Geometry & Topology 13 (2009) 1337-1417 1337

The Seiberg—Witten equations and the
Weinstein conjecture II: More closed
integral curves of the Reeb vector field

CLIFFORD HENRY TAUBES

Let M denote a compact, orientable 3—dimensional manifold and let a denote a
contact 1-form on M ; thus a A da is nowhere zero. This article explains how the
Seiberg—Witten Floer homology groups as defined for any given Sping structure on
M give closed, integral curves of the vector field that generates the kernel of da.

57R17, 57TR57

1 Introduction

Let M denote a smooth, compact 3—manifold and let a denote a smooth contact 1-form
on M . This is to say that the 3—form a A da is nowhere zero. Let v denote the vector
field that generates the kernel of da, and pairs with a to give 1. The prequel to this
article, [12], asserts that v has closed, integral curves. To be more specific, [12] asserted
the following.

Let K~! denote the 2—plane bundle kernel(a) CTM and let ec H?(M;Z)
denote any class that differs by a torsion class from half the Euler class
of K. There exists a finite, non-empty set of closed, integral curves of v
and a corresponding set of positive weights such that the formal sum of
weighted loops in M generates the Poincaré dual to e. (1-1)

Here, M is implicitly oriented by a A da, and K is oriented so that the isomorphism
TxM =Rv @ K~! is orientation preserving. Note that the Euler class of K is, in all
cases, divisible by two.

The purpose of this article is to describe other classes in Hy (M ; Z) that are represented
by formal, positively weighted sums of closed integral curves of v. To set the stage
for a precise statement of what is proved here, digress for a moment to introduce the
set, Spr, of Sping structures on M , this a principle homogeneous space for the group
H?*(M 7). Each element in S has a canonically associated Z—module, a version
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of Seiberg—Witten Floer homology that is described below. As explained shortly, the
contact form, a, supplies a canonical, H?(M ; Z)—equivariant isomormophism from
Sy to H*(M ; Z). With this isomorphism understood, each element in H>(M ; Z)
has an associated Seiberg—Witten Floer homology Z-module.

Theorem 1.1 Let e € H?(M ;7). When e # 0, the Poincaré dual of e is represented
by a positive integer weighted sum of closed, integral curves of the vector field v if the
associated Seiberg—Witten Floer homology is non-trivial. The class 0 € H{ (M ;Z) is
represented by a non-trivial, positive, integer weighted sum of closed integral curves of
v provided the Seiberg—Witten Floer homology for 0 € H?(M ;Z) is not Z.

The case in Theorem 1.1 when e differs from half K’s Euler class by a torsion element
is the case that is considered in [12] and (1-1). As a consequence, it is assumed in what
follows, unless directed otherwise, that these elements differ by a non-torsion element.

There are various existence theorems for non-zero classes in the relevant version of
Seiberg—Witten Floer homology. For example, [7, Theorem 41.5.2 in Kronheimer and
Mrowka’s book] asserts an existence theorem for non-trivial Floer homology groups
that can be used with Theorem 1.1. Their theorem refers to the dual Thurston norm for
a certain subspace in H2(M;Z). This dual norm is defined using the Thurston norm
on Hy(M ;7). The latter is a semi-norm that assigns to a non-zero class / the infimum
of the absolute values of the Euler characteristics of embedded surfaces in M with
no 2-sphere components and with fundamental class equal to 4 in Hy(M;Z). The
dual of this semi-norm defines a norm on the subspace in H?(M ;Z) that annihilates
the span of the classes in H, (M ; Z) with zero Thurston norm. [7, Kronheimer and
Mrowka’s Theorem 41.5.2 and Corollary 40.1.2] imply the following.

If M is an irreducible 3—manifold, then the unit ball for the dual Thurston
norm is the convex hull of the set of elements in H?(M;Z) with the
following two properties: First, the element differs from half the first
Chern class of K by a non-torsion element. Second, the associated
Seiberg—Witten Floer homology has some non-torsion elements. Here,
{0} is deemed the convex hull of the empty set. (1-2)

For another example, suppose that M fibers over the circle with fiber genus greater than
one. It follows in this case from Meng—Taubes [8] that there exist classes e € H 2 (M;7Z)
that differ from half K’s Euler class by a non-torsion element and have non-trivial
Seiberg—Witten Floer homology. This is also the case when M is obtained via zero
surgery on a knot in S3 with non-constant Alexander polynomial.
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Meanwhile, (1-2) also says something about the vanishing of the Seiberg—Witten Floer
homology when tensored with Q. For example, when M is an irreducible 3—manifold,
(1-2) and Theorem 1.1 lead to the following corollary.

Corollary 1.2 If M is irreducible, suppose that the Euler class of K has the following
properties: It is not torsion and it has dual Thurston norm greater than 1. Then there is
a non-empty set of closed, integral curves of v with positive weights that generate the
trivial class in Hi(M ;7).

There are also theorems about the Seiberg—Witten invariants that can be applied to
the case when M is reducible to deduce the existence of a set of closed integral
curves of v that generate the trivial class in H?(M;Z). In this regard, note that the
Seiberg—Witten invariant for a class in H?(M;Z) is the Euler characteristic of the
corresponding Seiberg—Witten Floer homology as defined with respect to a certain
7127 grading. The results in [8] with Theorem 1.1 lead to the following corollary.

Corollary 1.3 Suppose that M is the connect sum of manifolds My and M,. If
the Euler class of K is torsion, then (1-1) applies and there is a non-empty set of
closed integral curves of v with positive weights that generate the the trivial class in
H{(M ;7). If the Euler class of K is not torsion, there is a non-empty set of closed,
integral curves of v with positive weights that generate the trivial class in Hy(M ; Z) if
neither M nor M, has the Z—homology of S*.

Note that the existence of a closed integral curve in the case considered by Corollary
1.2 can also be deduced using Hofer’s celebrated results [4] and a theorem of Eliashberg
[3]. Indeed, Eliashberg’s result implies the following: If the Euler class of K has dual
Thurston norm greater than 1, then the resulting contact 2—plane field is overtwisted.
This being the case, Hofer’s existence theorem from [4] can be applied. Hofer [4] also
established a stronger version of what is said in Corollary 1.3: He proved that a Reeb
vector field for a contact structure on a 3—manifold with non-zero 7, has a contractible
closed orbit.

The theorem of Hofer [4] noted above asserts that the Reeb vector field for a contact
form whose kernel is overtwisted has contractible, closed orbits. As is explained in
what follows, results from Mrowka—Rollin [9] and Kronheimer—Mrowka [6] about
Seiberg—Witten Floer homology lead to a proof of the following homological version
of Hofer’s theorem.

Theorem 1.4 Let M denote a compact 3—manifold and let a denote a contact form
on M whose kernel is overtwisted. Then there is a finite, non-empty set of closed
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integral curves of the Reeb vector field with an associated set of positive weights such
that the weighted sum of curves is homologically trivial.

Abbas, Cielebak and Hofer [1] conjecture that there exists in all cases a union of closed,
integral curves of v with positive integer weights that define a homologically trivial
cycle.

The proof of Theorem 1.1 uses much the same technology as that used in [12] to prove
what is stated in (1-1). Even so, there are two substantial issues that complicate the
application. First, the Seiberg—Witten Floer homology groups are not Z graded when
e differs from half K’s Euler class by a non-torsion element. The second substantive
issue concerns the Chern—Simons functional: It is not gauge invariant when e differs
from half K’s Euler class by a non-torsion element. As a consequence, the function
whose critical points give the cycles for the Seiberg—Witten Floer homology is not
gauge invariant. As is explained below, these two issues constitute the two sides of a
single coin, and a single stroke circumvents both.

Theorem 1.4 is proved by coupling the techniques used to prove Theorem 1.1 with
constructions and ideas from three sources, Kronheimer—-Mrowka [7; 6], and Mrowka—
Rollin [9]. In particular, [9] provides a vanishing theorem that plays a key role in the
proof.

By way of a warning to the reader: This article is truly a sequel to [12] as it borrows
heavily from the latter. In particular, many arguments used here are straightforward
modifications of those in [12]. When such is the case, the reader is referred to the
corresponding argument and equations in [12].

The remainder of this section describes the relevant versions of the Seiberg—Witten
equations, and also some of the most quoted results from [12]. It also supplies a
brief definition of the relevant version of the Seiberg—Witten Floer homology. Section
2 closely follows the strategy from [12] so as to reduce the proof of Theorem 1.1
to a proposition that relates spectral flow to the Chern Simons functional. This key
proposition, Proposition 1.9, refines some of the spectral flow results that are stated
in [11, Section 5]. Section 3 proves this proposition. Section 4 reduces the proof
of Theorem 1.4 to a proof of a uniqueness assertion about solutions to a version of
the Seiberg—Witten equations on R x M . The final section proves this uniqueness
assertion.

As is the case with [12], what appears below owes much to previous work of Peter
Kronheimer and Tom Mrowka. Moreover, Tom Mrowka suggested using [6] and [9]
for Theorem 1.4.
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1.1 The Seiberg—Witten equations

Fix a metric on M so that the contact form, @, has norm 1 and is such that da = 2xa.
Here, * denotes the metric’s Hodge star operator. With this metric fixed, a Sping¢
structure is no more and no less than an equivalence class of lifts of the oriented,
orthonormal frame bundle of M to a principle U(2) bundle.

Such a lift, F, defines an associated, hermitian C?2 bundle, S = F XU(2) C2. The
bundle S is a module for a Clifford multiplication action of 7% M . This action is
denoted by cl. To be precise, cl is defined so that cl(vy) cl(vy) = —cl(x(v1 A v2))
when vy and v, are orthogonal 1-forms. Of course, cl(v) is anti-hermitian and
cl(v)?2 = —|v|?. A section of S is called a spinor. Let det(S) denote the complex line
bundle F Xget U(1) where det: U(2) — U(1) is the determinant homomorphism. The
Seiberg—Witten equations constitute a system of equations for a pair consisting of a
connection on det(S) and a section of S.

To write the version of the Seiberg—Witten equations used here, first note that the bundle
S decomposes as a direct summand of eigenbundles for the endomorphism cl(a). This
decomposition has the form S = E @ EK~!. Here, E is a complex line bundle and
K is viewed as a complex line bundle. The convention used for this decomposition of
S takes cl(a) to act as +i on the left-most summand in S while acting as —i on the
right-most summand. A given contact form defines the canonical Sping structure; this
is the Sping structure whose spinor bundle S =S; = Ic & K —1 where Ic denotes
a trivial line bundle. The assignment S — ¢ (E) supplies the 1 — 1 correspondence
between Syps and H?(M;Z) that is used in (1-1) and Theorem 1.1. With a contact
form chosen, the decomposition S = E @ EK~! finds det(S) isomorphic to EZK~!.

As is explained shortly, there is a Hermitian connection on K ! that is canonical up to
the action of the gauge group, this the space of maps from M to U(1). With such a
‘canonical connection’ chosen, one can view the Seiberg—Witten equations as equations
for a pair (A4, ) where A4 is a connection on E and  is a section of S. This is the
view taken in what follows.

To be more explicit about the canonical connection, note that a connection on det(S)
with the Levi—Civita connection on TM determines a Hermitian connection on S.
Let V: C®(M;S) - C®(M ;S ® T+« M) denote the associated covariant derivative.
The composition, first V and then the endomorphism from C®°(M ;S ® TxM) to
C°(M;S) induced by cl defines the Dirac operator, this a first order, hermitian
differential operator from C°°(M ;S) to itself. With the canonical connection chosen,
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D4 is used in what follows to denote the Dirac operator that is defined by a given
connection, A, on E. Granted this notation, suppose that a unit length, trivializing
section, 1¢, is chosen for the bundle I¢. Let A7 denote the connection on I¢ that
makes 1¢ covariantly constant. There is a unique connection on K with the property
that 1¢ is annihilated by the A = Ay version of D4. The latter connection is the
promised canonical connection.

The specification of the Seiberg—Witten equations requires the choice of a number, r,
with r > 1. Also required is the choice of a smooth 1-form on M with small C?
norm; in particular the norm should be less than 1. This form is denoted in what follows
by . The form p should be L?—orthogonal to all harmonic 1-forms on M and it
should be coclosed, thus d * u = 0. Granted these choices, the simplest of the relevant
versions of the Seiberg—Witten equations read:

By = r(wTrw —ia)+i(xdu + wg),

1-3
(1-3) D4y = 0.

Here, B4 denotes the Hodge dual of A’s curvature 2—form. Meanwhile, WT‘H/I isa
short-hand way to write the image in C(M ;i TxM) of the endomorphism ¥ ® v
via the adjoint of cl. Finally, @wg is the harmonic 1-form whose Hodge dual is —m
times the first Chern class of the bundle K.

In what follows, the form g is chosen from a certain Banach space of smooth forms on
M . The precise norm for this space is not relevant. Suffice it to say here that the space
is dense in C*° (M ; TxM). In particular, the Banach space norm bounds a suitable,
positive multiple of any given C k norm. The Banach space used here is denoted by 2.

Note that the equations in (1-3) are gauge invariant. This means the following: Suppose
that (A, ¥) satisfies (1-3) and that u is a smooth map from M to S' = U(1). Then
the pair (4 —u~'du, ur) also satisfies (1-3). The set of gauge equivalence classes of
solutions to (1-3) is compact for any choice of (.

Note also that there are no { = 0 solutions to (1-3) in the cases under consideration,
those where c;(F) — %cl (K) is not a torsion class.

Introduce Conn(E) to denote the space of smooth, Hermitian connections on E. The
equations in (1-3) are the critical points of a functional on Conn(E) x C*°(M;S). It
proves convenient to write this functional, a, as

1 t
(1-4) a= §(C5+2eu—rE)+V/1ﬂ Dav,
M
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where ¢s,¢, and E are functionals on Conn(E) that are defined as follows: The
definition of c¢s requires the choice of a connection, Ag, on E. Here, A is chosen
so that its curvature 2—form is harmonic. Write A = Ag + d4, where d4 is a section
of iT+M . In the case when E = I¢, choose Af to be the trivializing connection
Ay that was introduced above. Use ;s to denote the harmonic 2—form on M that
represents the first Chern class of the line bundle det(S). Then

CS(A)=—/ZZ\A/\*dZI\A—2iJT/aA AC1S,

M M
(1_5) eu,:l./,UJ/\*BA,
M
E(A):i/a/\*BA.
M

The introduction referred to the Chern Simons functional. This is ¢s. All but ¢s in
(1-4) are fully gauge invariant. The functional c¢s is gauge invariant if and only if
c1(det(S)) = 2¢1(E£) — c1(K) is a torsion class. In the cases under consideration, this
class is not torsion. In any event, ¢s(4 —u~'du) = cs(A) if u is a homotopically
trivial map from M to S'. In general, #w differs by a multiple of the greatest
integer divisor of cq(det(S)) on gauge equivalent pairs.

1.2 Properties of solutions to the Seiberg—Witten equations

This subsection restates for ease of reference some salient facts from [12] about solutions
to (1-3). The first of these explains how solutions to (1-3) lead to closed integral curves
of v.

Theorem 1.5 Fix a complex line bundle E so as to define a Sping —structure on M
with spinor bundle S given by E @ EK~!. Let {"nyn=1,2,... denote an increasing,
unbounded sequence of positive real numbers, and for each n, let |1, denote a co-
exact I-form on M . For each n, let (A, V) € Conn(E) x C°°(M ;S) denote a
solution to the r = r, version of (1-3) as defined using [1,,. Suppose that there is an
n—independent bound for the C3 norm of . In addition, suppose that there exists
an index n independent upper bound for E(A,) and a strictly positive, n independent
lower bound for sup,s (1 — |,|). Then there exists a non-empty set of closed, integral
curves of the Reeb vector field. Moreover, there exists a positive integer weight assigned
to each of these integral curves such that the corresponding formal, integer weighted
sum of loops in M gives the class in Hy(M ;7Z) that is Poincaré dual to the first Chern
class of the bundle E .
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This is [12, Theorem 2.1] and its proof is in [12, Section 6].

To say more about what is happening in Theorem 1.5, agree to write a spinor ¥ with
respect to the decomposition S = E @ K~ E as ¥ = (a, B). If the sequences {r,},
{un} and {(Ay, ¥ = (on, Bn)} satisfy the conditions stated by Theorem 1.5, then the
corresponding sequence {a, ' (0)},=1,2.... of closed subsets of M has a subsequence
that converges in a suitable sense to the desired set of closed integral curves.

The next three lemmas summarizes various facts about the solutions to (1-3). They
restate what is asserted in [12, Lemmas 2.2, 2.3 and 2.4]. The proofs of the latter are
also in [12, Section 6].

Lemma 1.6 Fix the line bundle E — M and hence the Sping structure. There is a
constant k > 1 with the following significance: Let i denote a co-exact 1—form with
C3 norm bounded by 1. Fix r > 1 and suppose that (A, ¥ = («, B)) is a solution to
the version of (1-3) given by r and . Then

] < 1+4ur!,

B> < wer=H (1 =la?| + 7).

The next lemma concerns the derivatives of & and 8. To state the lemma, suppose
that A is a given connection on E. Introduce V to denote the associated covariant
derivative. The covariant derivative on K—!E that is defined by 4 and the canonical
connection is denoted in what follows by V’. Powers of these covariant derivatives
are defined using A and the Levi—Civita induced connection on the appropriate tensor
power of TxM .

Lemma 1.7 Fix the line bundle E — M and hence the Sping structure. For each
integer ¢ > 0 and constant ¢ > 0, there is a constant ¥k > 1 with the following
significance: Let pu denote a co-exact I-form whose C3+9 norm is bounded by c¢. Fix
r > 1 and suppose that (A, ¥ = («, B)) is a solution to the version of (1-3) defined by
r and . Then

V| < k(9 +1).
V9Bl < k(@D 4 1),

The final lemma says something about the connection 4.

Lemma 1.8 Fix the line bundle E and hence the Sping structure. Also, fix a con-
nection Ag on E. There exists a constant k > 1 with the following significance:
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Let o denote a co-exact 1—form with C3 norm bounded by 1. Fix r > 1 and sup-
pose that (A,y = («, B)) is a solution to the version of (1-3) defined by r and L.
Then, there exists a smooth map u: M — S suchthatd = A—u~'du— Ag obeys
a| < k(r23el/3 +1).

Note that Lemma 1.6 implies that
(1-6) —cy <E(A) <rvol(M) + ¢y,

when (A4, ) satisfies (1-3). Here, ¢, depends only on the C?3 norm of L.

1.3 Spectral flow

Each pair of r €[1, o0) and element (A4, ) € Conn(E) x C*°(M ;S) has an associ-
ated, first order, elliptic differential operator. This operator is denoted by £; it maps
C®(M;iTxM &S ®iR) to itself, and it is defined as follows: Let h = (b, 1, ¢) €
C®(M;iT«xM &S ®iR). The respective i T*xM , S and iR summands of the £h
are:

sxdb—dp —27V2: 2y e 4 pfoy),
(1-7) Dn+ 2127121y + ¢y,
swd xb— 2712120ty —y Ty,

The domain of this operator extends to map L2(M;iT«+M @S @ iR) to itself as a
self-adjoint operator with domain L%(M ;iTx«M &S @iR). Its spectrum is discrete, all
eigenvalues have finite multiplicity, there are no accumulation points for the spectrum,
and the spectrum is unbounded from above and from below. A pair (A4, ¥) is called a
non-degenerate solution to (1-3) when the » and (A4, ¥) version of £ has trivial kernel.

Let Afg denote the connection that was chosen above to define ¢s. Fix rg > 1. If
¥ is a suitably generic section of C%°(M;S) with || < 1, then the r = rg and
(A= AEg,¥ =yE) version of £ will have trivial kernel. Agree to fix y g once and for
all. In the case when E = 1¢, it follows from [12, Lemma 5.4] that the pair (A7, V)
is non-degenerate when r is greater than some constant 7. This understood, take rg
intobe r« + 1 and Y g = vy when E is the trivial bundle.

Now, suppose that » > 1 and (A4, 1) € Conn(E) x C°°(M;S) are such that the r
and (A, ¥) version of £ also has trivial kernel. Then one can associate a number,
f(A,¥), to the pair (A4, ¥) as follows: Fix a path t — (r(¢), c(¢)) €[1, r) xConn(E) X
C°(M;S) that is parameterized by ¢ € [0, 1], starts at (1, (Ag, ¥ Eg)) and ends at
(r, (A, ¥)). Take f(A, ) equal to the spectral flow for the corresponding path, ¢ — £;
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of versions of (1-7). For those unfamiliar with this notion, see [12, Section 5a] or [11].
The value of f does not depend on the chosen path. Note in what follows that f
defines a locally constant function on a dense, open subset of Conn(E) x C°(M;S).
(It can be shown that f is defined on the complement of a codimension 1 subvariety.)

When r is given and (4, ) is a non-degenerate solution to (1-3), the value of — f
is called the degree of (A, ). This notion of degree assigns an integer to each non-
degenerate solution to (1-3). Note that the degree as just defined depends on the choice
of Ag and also on ¥ g, but the difference between the degrees of any two elements
from Conn(E) x C*°(M;S) does not depend on these choices.

The function f is not gauge invariant when ¢ (E) — %cl (K) is not torsion; its values
can differ on gauge equivalent configurations by a multiple of the greatest common
divisor of ¢ (det(S)). However,

(1-8) s/ =cs—dn?f

is gauge invariant. This understood, the following proposition plays a central role in
the proof of Theorem 1.1 and Theorem 1.5.

Proposition 1.9 There exists a constant k > 1 with the following significance: Fix
r >« and pu € Q with C3 norm less than 1, and let (A, ) denote a non-degenerate
solution to the r and . version of (1-3). Then |cs/ (A, ¥)| < kr?/3(1 + [E[)*/3(Inr)*.

This proposition is new; its proof is given in Section 3.

Under certain circumstances, Proposition 1.9 is a refinement of a version of [12,
Proposition 5.1] that holds in the case when ¢ (det(S)) is not torsion. The latter also
plays a role in what follows.

Proposition 1.10 There exists k with the following significance: Fix r > k and p € €2
with C3 norm less than 1, and let (A, ) denote a non-degenerate solution to the r
and . version of (1-3). Then |cs/ (4, ¥)| < kr31/16,

Proof of Proposition 1.10 Repeat verbatim the arguments given in [12, Sections 5S¢
and 5d] and then appeal to [12, Proposition 5.5]. |

1.4 Seiberg—Witten Floer homology

The definition used here of Seiberg—Witten Floer homology in the case when ¢ (E) —
%cl(K) is not torsion comes from [7]. What follows is a summary. To start, the
definition requires Seiberg—Witten equations that are perturbed versions of those that
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are depicted in (1-3). Each such perturbation of (1-3) is the variational equations of
a function on Conn(E) x C*°(M;S) that is obtained from what is depicted in (1-4)
by adding one of an admissible class of gauge invariant functionals to what appears
on (1-4)’s right hand side. The precise nature of this class of admissible additions
is described in [7, Chapter 11.6, see Definition 11.6.3]. Suffice it to say here that
these admissible functionals come from a separable Banach space of functions on
Conn(E) x C°°(M;S), and that one need only consider additions with very small
norm. This Banach space is denoted in what follows by p, and its norm is denoted by
| -1l,. Note that the function ¢, is in p when g is in the Banach space 2. A function
from p is called a perturbation function, and the terms that it supplies to (1-3) are called
perturbation terms. Fix r > 1 and a perturbation function g on Conn(E)x C*°(M;S).
The resulting version of the Seiberg—Witten equations reads

Bi=r(WTty —ia) + (4, v) + iwk.

1-9)
Dy = 6(A4.9).

where T and & are defined by requiring that their respective L? inner products with
sections b of i 7%M and n of S are ¥ = %Q(A +tb,¥)|;=0 and & = —%Q(A, ¥+
tn)|s=o. For example, the equations that appear in (1-3) use g = ¢,. A solution
to (1-9) is deemed to be non-degenerate when a certain perturbed version of (1-7)
has trivial kernel. This perturbed version of (1-7) is depicted in [12, (3.1)]. The
perturbation subtracts respective terms t(4 (b, 1) = %‘I(A +th, ¥ +1n)|;=o and
S(A,y) = %G(A +th, ¥ +1tn)|;=¢ from what is written in the first and second lines
of (1-7).

As in the cases that are considered in [12], there is a dense, open set of forms p € €2
such that with r fixed, then (1-3) has a finite set of gauge equivalence classes of
solutions, with each non-degenerate in the sense that the operator in (1-7) has trivial
kernel. With it understood that ¢q (E) — %cl (K) is not torsion, the arguments from [7]
that justified [12, Lemma 3.1 and 3.2] also prove the following lemma.

Lemma 1.11 Given r > 1 there is a residual set of i € €2 such that all solutions to
the corresponding version of (1-3) are non-degenerate. There is an open dense set of
g € p such that all solutions to the corresponding version of (1-9) are non-degenerate.
Foragivenr > 1 and u € Q2 and q € p, suppose that ¢ = (A, {) is a non-degenerate
solution to the r and g = ¢y, + q version of (1-9). Then the following are true.

e There exist € > 0 such that if (A’, V) is a solution to (1-9) that is not gauge
equivalent to (A, ), then the L% norm of (A — A’, v — ') is greater than &.
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e There is a smooth map, c(-), from the ball of radius ¢ centered at the origin
in p to Conn(E) x C®°(M;S) such that ¢(0) = ¢ and such that ¢(p) is a non-
degenerate solution to the version of (1-9) defined by r and the perturbation
g=¢y+q+p.

With r chosen, fix © € © so that all solutions to the resulting version of (1-3) are
non-degenerate. The cycles for the Seiberg—Witten Floer homology consist of the
elements in the vector space over Z that is generated by the set of gauge equivalence
classes of solutions to (1-3). Let p denote the greatest integer divisor of ¢y (det(S)).
Any given generator for the Seiberg—Witten Floer homology has a Z/ pZ grading; and
for the purpose of this article, the Z/ pZ grading for a given generator is defined as
follows: The grading of the generator (A4, V) is the image of — f(A4,v) in Z/pZ.
The grading is defined only modulo p because values of f on gauge equivalent pairs
in Conn(E) x C*®°(M;S) can differ by multiples of p.

The differential on the chain complex is obtained using instanton solutions to the
Seiberg—Witten equations on R x M . Given r > 1 and a perturbation function g € p,
an instanton is a smooth map s — 9(s) from R to Conn(E) x C°°(M;S) that satisfies
the equation

0
A= —Batr( Tty —ia) + T(A.Y) +iwg.

(1-10) 9
U= —DaV +S(A. V),

and is such that both limg_,_, 0(s) and limg_ o 0(s) are solutions to the r and g
version of (1-9). The instantons determine the differential as follows: Let ¢ and ¢’ denote
a pair of solutions to (1-9) for a given r and perturbation g. Use M(c,¢’) to denote
the space of instanton solutions s — ?(s) = (A(s), ¥ (s)) to (1-10) whose s — —o0
limit is equal to ¢ and whose s — +oo limit equal to i - ¢’ for some & € C®°(M; S!).
Given an integer i, introduce M;(c, ¢’) to denote the union of those components of
M(c, ¢') with the following property: Define the family of operators {£;}secr With
£ defined by the given value of r and the configuration 0(s) = (A(s), ¥ (s)) in (3-1).
Then 0 € M;(c, () if and only if the spectral flow for {£s}ser is equal to -t. [7,
Theorems 15.1.1 and 16.1.3] provide the following analog to [12, Lemma 3.6].

Lemma 1.12 Given r > 1, there exists an open, dense set of j1 € Q@ with C3 norm
less than 1 for which the following is true.

e Each solution to the r and u version of (1-3) is non-degenerate.
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e Given p for which the preceding conclusions hold, there exists € > 0 and a
dense, open subset of the radius ¢ ball in p such that if q is in this set, then the
g = ¢, + q versions of {M,—;(-,-)} can be used to compute the differential on
the Seiberg—Witten Floer complex. In particular, for such q,
a) M;(,-)=2 when(<0.
b) M,—o(c,¢’) = @ unless ¢ = ¢’ in which case it contains only the constant

map s — 0(s) = c.

¢) M;—(c,¢) is a finite set of copies of R.

A pair (u,q) € Q x p as described by Lemma 1.12 is called r—admissible. When
(1. q) is r—admissible, then the (c,¢’) version of M,—;(c, ¢') is 1-dimensional and
each component has a well defined sign, this described in [7, Chapter 22.1]. The sum of
these signs defines an integer that is denoted here by o (c, ¢’). Take o (¢, ¢) to equal 0
when M;—1(c, ') = @. An integer so defined is associated to any generators, ¢ and ¢’
, of the Seiberg—Witten Floer context with the property that degree(c) = degree(c’) + 1.
This understood, the differential on the Seiberg—Witten Floer complex is given by the
rule:

(1-11) 8c=20(c, ).

The differential decreases the mod( p) degree of any given generator by 1.

An appeal to [7, Proposition 22.1.4 and Corollary 23.1.6] gives the following analog to
[12, Proposition 3.7].

Proposition 1.13 Fix r > 1 and an r —admissible pair (i, q) to define the generators
and differential on the Seiberg—Witten Floer complex. Then 8> = 0. Moreover, given
two r admissible pairs, there exists an isomorphism between the corresponding versions
of Seiberg—Witten Floer homology. In addition, the homology so defined for different
values of r > 1 are isomorphic.

This last proposition ends the introduction to Seiberg—Witten Floer homology.

1.5 Conventions

The reader is forewarned here about a notational convention that is used in the subse-
quent sections of this paper: Whenever cg appears, it represents a positive constant,
greater than 1, whose value depends only on a chosen metric, the 1-forms a and pu, the
bundle E, and perhaps other fixed objects. In particular, the value of ¢ is independent
of the value of r and of any particular solution to (1-3), (1-7), (1-9) or (1-10) that is
under consideration. The precise value for ¢y will typically increase from appearance
to appearance.
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2 The proof of Theorem 1.1

The plan is to fix a suitable, small normed element p € €2, and then find an increasing
sequence {7y }n=1,2,... and, for each n, a pair (4, ¥,) € Conn(E) x C*°(M;S) that
solves the r = r, and u version of (1-3); and then appeal to Theorem 1.5 to find
the desired set of closed integral curves of v. For this purpose, it is necessary to find
(An. ¥n) so that the corresponding sequence {E(Ay)}n=1,2,... has a finite upper bound,
and so that the sequence {supy; (1 —|¥x|)}n=1,2,... has a positive lower bound.

As will be clear from what follows, the purpose of Proposition 1.13 is to supply the
solutions to (1-3). For example, when the Seiberg—Witten invariant is non-zero, then
any r and p version of (1-3) has at least one gauge equivalence class of solution. As in
[12], the subtle issue is that of finding a sequence {r,},=1,2,..., and the corresponding
sequence {(An, ¥n)in=1,2,... such that {E(A4y)}n=1,2,.. is bounded. The arguments
that are used in [12] are modified in what follows to find such a sequence. The existence
of a positive lower bound for {(1 — [¥s|},=1,2,... for the case when E is non-trivial
follows immediately from Lemma 1.6 by virtue of the fact that the first component
of any section of S = E @ EK~! must vanish at some point in M in this case. Of
course, this argument can not be made in the case when E is trivial. The need for an
alternate argument when E = I¢ is the proximate cause for the separate assertion in
Theorem 1.1 for e = 0 case.

What follows outlines how the arguments from [12] proceed in the situation at hand.
Proposition 1.13 asserts that the Floer homologies that are defined for different values
of r and different perturbation functions are isomorphic. This understood, it is first nec-
essary to construct isomorphisms that lift in a suitable fashion to give homomorphisms
between the relevant chain complexes. This is done so as to facilitate the assignment of
a certain continuous function of r to any given Seiberg—Witten Floer homology class.
In the case considered in [12], this function was the value of a on a certain generator in
a certain representative cycle for the class. The cycle and generator are found using a
min-max construction. In the present situation, a is not gauge invariant and so lacks a
definite value on any given generator of the Seiberg—Witten Floer complex. However,

-1 of =a—2727%,

is defined on any non-degenerate solution to (1-3) and is gauge invariant. As is explained
in what follows, the min-max construction from [12] work just as well with a/ in lieu of
a to assign a continuous function of r to each Seiberg—Witten Floer homology class. As
it turns out, the » dependence of a/ is such that the arguments from [12, Section 4] can
be employed with but one significant change to find the sequence {ry, (4, ¥,)} with
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{E(A,)} bounded. This change requires new input, and this is supplied by Proposition
1.9.

2.1 Assigning certain functions of r to Seiberg—Witten Floer homology
classes

The purpose of this subsection is to associate values of a/, E and ¢s/ to a given
Seiberg—Witten Floer homology class. This association will provide functions of r that
are analogous to the functions that are described in [12, Definitions 4.1 and 4.4].

The first step for this task is to define chain homotopies between the respective Seiberg—
Witten Floer complexes that are defined at different values of ». The construction starts
with an analog of [12, Proposition 3.11].

Proposition 2.1 There is a residual subset in Q with C3 norm less than 1 and with
the following properties: Let p denote a form from this subset. There is a locally
finite set {pj} C (1, 00) with p; < py <--- suchthatifr > 1 and r € {p;}, then the
following are true.

1) Each solution to the r and p version of (1-3) is non-degenerate.

2) Define a using the r and g = ¢, version of (1-4). If ¢ and ¢’ are solutions the r
and p version of (1-3) that are not gauge equivalent, then a/ (¢c) # a/ (¢').

Proof of Proposition 2.1 The proof is identical save for some minor notational
changes to [12, the proof of Proposition 3.11 given in Section 7b]. a

This last proposition can be used to define a “canonical” basis and for the Seiberg—
Witten Floer complex when r € {p;}. This is done with the help of the following
lemma.

Lemma 2.2 If all solutions to the r and [ version of (1-3) are non-degenerate, then
there exists € > 0 with the following significance.

* If q € p has norm less than ¢, then all solutions to the g = ¢y, + q version of
(1-4) are non-degenerate.

e If q € p has norm less than ¢, then there is a 1 — 1 correspondence between the
set of solutions to the r and |t version of (1-3) and the set of solutions to the r
and g = ey, + q version of (1-9).

e In particular, if ¢ is a solution to the r and p version of (1-3), then there exists a
smooth map, c(-), from the radius ¢ ball in p into Conn(E) x C*°(M ;S) such
that ¢(q) solves the r and ey + q version of (1-9) and such that ¢(0) = ¢.
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e If ¢ is a solution to the r and p version of (1-3), then the assignment q —
af (c(q)) defines a smooth function on the radius ¢ ball in p.

o If a/(c) # a/(¢) when ¢ and ¢ are distinct gauge equivalence classes of
solutions to the r and p version of (1-3), then ¢ can be chosen so that the ranges
of the functions a” (¢(-)) and a/ (¢'(-)) are disjoint.

Proof of Lemma 2.2 This follows from Proposition 2.1 with Lemma 1.11 given that
f is locally constant on its domain of definition in Conn(E) x C*°(M ;S). ad

Suppose now that all solutions to the » and u version of (1-3) are non-degenerate and
are such that a/ distinguishes distinct gauge equivalence classes of solutions. For each
degree k € 7./ pZ, label the degree k gauge equivalence classes of solutions to (1-3)
by the consecutive integers starting at 1 using the convention that af (¢y) > af (cy+1).
This labeling is deemed the canonical labeling. Now suppose that ¢ > 0 is given by
Lemma 2.2, that q € p has norm less than ¢ and that (i, q) is r —admissible. If g has
these properties, then (u, q) is called strongly r—admissible. Assume that q has these
properties. For each degree k and each labeling integer v, let ¢, (-) denote the map
that is provided by Lemma 2.2 with ¢, (0) = ¢,,. Then the collection {c, (1)} defines
a labeling of the generators for the degree k& generators of the Seiberg—Witten Floer
complex as defined using the r and g = ¢, + q. The corresponding basis for this
complex is deemed the canonical basis.

Granted this terminology, what follows is an analog of [12, Proposition 3.12].

Proposition 2.3 Let  be as in Proposition 2.1. Fix pj € (ry,00) from the set
described in Proposition 2.1. There exists a possibly empty, but contiguous set J (i) C Z,
and a corresponding sequence {tm } meJy (i) € (pi, pi+1) with the following properties.

e The sequence is increasing, and it has no accumulation points in the open interval.

e For any given m € J (i) there exists q,, € p of small norm such that (i, q,;) is
strongly r —admissible for all r € [ty,, ty41]-

e When the canonical basis is used for the r € [ty ;1] and g = ¢, +qmm versions
of the Seiberg—Witten Floer complex, then the differential on this complex is
independent of r as r varies in [t;,, t;,+1]. This differential is denoted by &, .

e LetmedJ(i). Ineach Z/ pZ degree, there is an upper triangular, integer valued
matrix, A, with 1 on the diagonal such that 8,, = A~18,,_1A. Here, both §,,
and §,,— are written with respect to the canonical basis.
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Proof of Proposition 2.3 But for two observations and some terminology, the proof
is identical to the proof of [12, Proposition 3.12]. Here is the first observation. Let
V denote the Z/ pZ graded vector space with basis in any given degree k given by
the canonical basis for the Seiberg—Witten Floer complex as defined using the gauge
equivalence classes of solutions to the r = ¢, and u version of (1-5). Fix a path
s — q(s) as in [12, Part 1 of the proof in Section 7c] of [12, Proposition 3.12]. Use this
path to define the equations that appear in [12, (7.12)]. Let c— denote a solution to the
I =ty and g = ey + q,,—1 version of (1-9) and let ¢4 denote a solution to the r = 1,
and g = ey + q,, version. Assume that c_ and ¢4 have the same degree in Z/pZ.
Let M) (c—, c4) denote the space of solutions s — d(s) to (1-9) with s — —o0 limit
equal to ¢_ and with s — oo limit equal to #-¢ with i a smooth map from M to S!.
Let s — (A(s), ¥ (s)) denote an element in M()(c—, c+). For each s € R, let £
denote the version of the operator in [12, (3.1)] that uses the pair (A(s), ¥ (s)) and the
perturbation data coming from g = ¢, + q(s). Use My yo(c—, c4) C My)(c—, c4)
to denote the subset of M) (c—, ¢4) for which the family {£;}secr has zero spectral
flow. If q(-) is suitably generic, then M )o(c—, c+) is a finite set of points, and each
point comes with a sign. (See [7, Chapter 25.2].) Let o(c—, c¢+) denote the sum of
these signs, or else 0 if Myo(c—,c+) = &. Use these numbers to define a matrix
T: V—Vasin[12,(7.13)]. The results in [7, Chapter 25.3] imply that T ,,—1 =8, T
and that T induces an isomorphism from the §,,—; version of the Seiberg—Witten
Floer homology to the §,, version.

Granted the preceding, then the arguments given in [12, Part 2]’s Section 7¢ prove that
A is upper triangular given the following: First, if s — 0(s) € Mo (c—, c+) and if the
s — oo limit of 0(s) is written as #1-c4 with 7€ C®(M;S'), then f(ii-c1) = f(c_).
Indeed, this condition defines what is required for membership in M )o(c—, c4).
Second, the total change of the function s — a(9(s)) between —oo and oo must be
negative unless ¢c— = c4. This follows using the same argument as that given for [12,
the proof of Lemma 7.2]. The point here, as in [12, the proof of Lemma 7.2], is that
the function a(9(-)) on R is non-increasing in the case when s — 0(s) is a solution to
(1-10), and it is constant if and only if 0(-) is constant.

Proposition 2.3 allows for a canonical identification of the Seiberg—Witten Floer homol-
ogy at different values of r in any given interval of (1, 00)—{p;}. This is done just as in
[12, Definition 3.13] which treats the case when ¢ (det(S)) is torsion. To say more, fix
pi € {pj} and consider the interval (p;, pj+1). For m € J (i), the Seiberg—Witten Floer
homology is defined for r € [t;,, t;;+1) by the differential §,,. The various k € Z/ pZ
versions of Proposition 2.3’s matrix A are used to identify the r € [t,,—1, #;) version
of the complex with the version that is defined for » € [t;,, #;;,+1). This definition
of the Seiberg—Witten Floer complex for the interval (p;, p;+1) is used implicitly in
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what follows when reference is made to the Seiberg—Witten Floer complex and the
Seiberg—Witten Floer homology for the interval (p;, pi+1)- O

What follows is an analog of [12, Definitions 4.1 and 4.4].

Definition 2.4 Fix p as in Proposition 2.1, and let {p;j} C (1,00) denote the re-
sulting set. Fix p; € {p;} and let {t;},ey(;) be as described in Proposition 2.3.
Fix # € {tn}ney) and introduce the perturbation g, from Proposition 2.3. Given
" € [tm,tm+1), use r and the perturbation g = ¢, + ¢, to define the Seiberg—Witten
Floer homology complex. Use the canonical labeling to identify the generators with
the solutions to the r and u version of (1-3). Let 8 denote a non-zero class for a given
degree in the resulting Seiberg—Witten Floer homology.

» Suppose that n =), Z,¢, is a cycle defined for the given value of r and u
that represents the class 6. Define @/ (n, ) to be the maximum value of a/ on
the set of gauge equivalence classes of solutions to the r and p version of (1-3)
that appear in the sum for n. Then define ag (r) to be the minimum over all
such n of the values of a/ (n, r).

 Suppose that n =), Z,¢y is a cycle defined for the given value of r and u
that represents the class 6 and is such that af(m,r)= aef (r). Let E(r,n) denote
the infimum of the values of E on the configurations ¢ € {c,} that appear in the
sum for n and have a/ (¢) = ag (). Then, define
a) E(r) to be the infimum of the set {E(n,r)} over all such n,

b) o(r) =2a) (r) + rE(r),
0 {r)=—=2r""al () = B(r) = rTo(r).

The next proposition is the analog of [12, Proposition 4.2].

Proposition 2.5 Fix u as in Proposition 2.1, and let {p;j } C (1, c0) denote the resulting
set. Then the various r € (1, 00) —{pj} versions of the Seiberg—Witten Floer homology
can be identified so that the following is true: Let 6 denote a Seiberg—Witten Floer
homology class in a given degree. Then the function agy(-): (1,00) —{pj} defines a
continuous, piecewise differentiable function that extends to (1, 00) as a continuous
piecewise differentiable function. Moreover, there exists a countable set in (1, co0) and
a smooth map, ¢(-) = (A(:), ¥ (-)), from the complement of this set into Conn(E) X
C®(M;S) such that for each r in the domain of ¢(-), the configuration c¢(r) is a
non-degenerate solution to the r and p version of (1-3) with the same degree as 6 and
with ag(r) =a/ (c(-)),E=E(A(r)) and v = cs/ (c(r)) + 2e,(c(r)). In addition, c(r)
defines a generator of the Seiberg—Witten Floer complex whose coefficient is non-zero
in some cycle that represents the class 6.
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2.2 Proof of Proposition 2.5

There are four steps to the proof. The first three steps construct a suitable identifica-
tion between the respective Seiberg—Witten Floer homologies as defined for different
components of (1,00) —{p;}. This is done with constructions that are very much like
those given in [12, Sections 3d and 3e]. Once these identifications are defined, the last
step constitutes what is an essentially verbatim repeat of the arguments that are given
in [12, Section 4a] to prove the latter’s Proposition 4.2.

Step 1 Let p; € {p;j}. The constructions in [12, Sections 3d and 3e] have their
analogs here that provide a chain equivalence between the respective Seiberg—Witten
Floer complexes as defined for the contiguous intervals (p;—1, p;) and (p;, pi+1). As
is explained below, almost verbatim analogs exist for each of five properties in [12,
Section 3d] including [12, (3.6)] and [12, Lemmas 3.14-3.17]. This step provides some
background stage setting and notation for the statements of these analogs.

To start, suppose that » € (p;—1, pi+1) and that some small element g € p has been
specified. Let ¢ denote a non-degenerate solution to the r and g = ¢, + q version of
(1-9). This is to say that the operator that is obtained from (1-7) by adding respective
terms t(4,y) (b, 1) = LT (A+1b, Y +11)] =0 and 54,4y = ES(A+1b, ¥ +10))|1=0
from what is written in the first and second lines of (1-7) has trivial kernel. Let £,
denote this last operator. Define f;(c) to be the spectral flow for a suitably generic
path of self-adjoint operators on L2(M;iT«M @S @iR) that starts at the (A, Y E)
version of (1-7) and ends with £;. Set csg to denote ¢s(Ag). This done, deem
—(fq(o) + #csE) to be the degree of c.

If all solutions to the r and g = ¢, + q version of (1-9)) are non-degenerate, and if q is
suitably generic with regards to the behavior of the solutions space of the corresponding
version of (1-10), then Z/ pZ graded Seiberg—Witten Floer homology can be defined
as the homology of a square zero differential on the set of gauge equivalence classes
of solutions to the r and g = ¢, + q version of (1-9). Here, the grading of a solution
¢ is defined to be the Z/ pZ reduction of the degree of ¢ as just defined. Of course,
if r € (pj—1,pi) orif r € (p;, pi+1) and if g has sufficiently small norm, then the
maps in Lemma 2.2 provide a canonical isomorphism from the p—periodic, Z graded
complex as just defined to that defined by Proposition 2.3. This isomorphism identifies
the respective differentials up to the action of some upper triangular matrix.

Step2 Fix ¢ >0, fix r— € (pj—1, pi), and fix r € (p;, pi+1). Let me J(i — 1) be
such that r— €[ty;, ty+1), and set q— =g, . Let m’ € J (i) be such that r4 € [tyy, ty+1)
and set q+ = (. Given that both r_ and ry are sufficiently close to p;, it can be
assumed that both q— and q4 are in the radius ¢ ball about 0 in p. The task at hand
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is to choose a path r — q(r) in this ball with certain desired properties. The path is
parameterized by r € [r—, r4], it obeys q(r—) = q— and q(r4+) = q+. As explained
below, if |p; —r—| and |p; — r4| are sufficiently small, the path can be chosen to have
the five properties listed next.

Property 1: Let g(r) = ¢, +q(r), and let agy,) denote the functional on Conn(E) x
C®(M:; S") that is obtained from (1-4) by replacing ep by g(r). Fix r € (tm, tw)
and any solution to the » and g(r) version of (1-9). The value of ag(,) on the solution
is within &2 of the value of the original version of a on some solution to the r = p;
and p version of (1-3). Moreover, there is a finite, increasing subset, {y,} C (r—,r4),
such that all solutions to the r and g(r) version of (1-9) are non-degenerate when
r € {yn}. In addition, the values of the functional ay(,)— 272 Satr) — %cs E distinguish
the various gauge equivalence classes of solutions to the r and g(r) version of (1-9)

when r € {y,}.

Property 2: Let I C [r—,r4+]—{yn} denote a component. There exists a consecutively
labeled, increasing set, {wy ek (1), in the interior of / that is finite or countable, but
with no accumulation points in /. For each m € K([), there exists a perturbation
pm € p of very small norm such that (u, q(r) + pm) is (k,r)—admissible at each
I € [Wp, Wiy+1]- In addition, py, is such that the gauge equivalence classes of solutions
to the r and g(r, m) = ¢, +q(r) 4+, version of (1-9) are in 1—1 correspondence with
those of the r and g(r) version of (1-9) with the same degree for all r €[, t;541]. This
equivalence is given by the analog of the maps in Lemma 2.2 (see [12, Lemma 3.2]).
The equivalence is such that the value of ag(; ) —27? Sorm)— %cs E on a given gauge
equivalence class of r and g(r, m) solutions to (1-9) is very much closer to the value of
the function ag(,) — 272 Satr) — %cs E on its partner gauge equivalence class of » and
g(r) solutions to (1-9) then it is to the value of ag() — 272 Jar) — %cs E on any other
gauge equivalence class of solution to the » and g(r) version of (1-9). In particular,
the ordering of the r and g(r) equivalence classes of solutions given by the values
Ag(r) — 2712fg(r) — %csE is the same as that defined by ag(, ) — anfg(r,m) — %csE
via this equivalence.

As in the cases studied by [12], what is asserted by Properties 1 and 2 have the following
consequence: Fix a component I C [r—,r+]—{y,} and m € K(I). Then the Seiberg—
Witten Floer homology can be defined for r € [wy,;, wy,+1] using the solutions to the r
and g(r, m) versions of (1-9) and (1-10). Note in this regard that the vector space of
cycles in a given degree can be identified using Property 2 with a fixed vector space.
This is the vector space generated by the gauge equivalence classes of solutions to
the r and g(r) version of (1-9) with these generators labeled by their ordering using
Agr) — 272 Jatr) — %cs . Here, the convention labels the basis of cycles with the
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larger numbered ones having smaller values of ag(,) — 22 Jar) — %cs E - This fixed,
r—independent basis is called the I —canonical basis.

Property 3: Fix an interval I C [r—,r+]—{y,} and some w,, € K(/). As r varies in
[Wi, W+ 1], the differentials as written for the /—canonical basis of the p-periodic,
Z—graded, Seiberg—Witten Floer complex are independent of ». Moreover, there exists
an upper triangular, degree preserving matrix, A = A(m) with 1s on the diagonal
such that the differential, 6,,—; defined on [w,—1, wy,] and the differential §,, defined
on [wy,, w,+1] are related, when written using the /-—canonical basis, by the rule
Sm=A"18,_1A.

The next property addresses behavior of the solutions to the » and g(r) version of (2-4)
at any given y € {y,}. In what follows, /_ denotes the component of (r—,r1) —{y,}
whose closure adds y as its upper endpoint, and /4 denotes the the component whose
closure adds y as its lower endpoint.

Property 4: One and only one of the following two assertions holds.

e All solutions to the » = y and g(y) version of (1-9) are non-degenerate, and
there is precisely one pair of distinct gauge equivalence classes of solutions to
the r = y and g(p) version of (1-9) that are not distinguished by the values
of agy) — 2n2fg — %csE. In addition, there exist y_ < y and y4 > y such
that if yg € [y—, y+] and if ¢ is a solution to the r = yo and g(y¢) version of
(1-9), then there is a smooth map, c(-), from (y—, y+) to Conn(E) x C°°(S)
such that ¢(y—) = ¢ and c(r) solves the r and g(r) version of (1-3) for each
re€y—. y4l.

» The function ag(,) — 27 Ja) — %cs £ distinguishes the gauge equivalence
classes of solution to the r = y and g(y) version of (1-9). Meanwhile all but
one gauge-equivalence class of solution to the » = y and g(y) version of (1-9)

has non-degenerate solutions. In addition the following hold.
1) The operator £, for any solution in the one anomalous gauge equivalence

class has kernel dimension 1.

2) The number of gauge equivalence classes of solutions to the r and g(r)
version of (1-9) change by two as r crosses y, and the number of gauge
equivalence classes of solutions to the r = y and g(y) version of (1-9)
differs by 1 from the number on either side of .

3) Let I € {I_, I+} denote the component with the greater number of equiva-
lence classes. Then there are respective representatives, ¢(r) and ¢/(r), of
distinct equivalence classes of solutions to the » and g(r) version of (1-9)
that vary smoothly with r € I and converge in Conn(E)x C*°(S) as r — y
to the one anomalous » = y equivalence class. Also, the Z/pZ degree of ¢
is one greater than that of ¢ .
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4) Let n denote a solution to the » = y and g()) version of (1-9) that is
not gauge equivalent to the one anomalous gauge equivalence class. Then
there is a smooth map n(-): /- U {y}UI; — Conn(E) x C*°(S) such that
n(y) = n, and such that n(r) is a solution to the » and g(r) version of (1-9)
forall re I_U{y}UI;.

The final property describes how the generators of the Seiberg—Witten Floer homology
change as r crosses a given y € {y,}. To this end, define the respective /— and I+
versions of the cSWF complex and homology in degrees greater than & using the points
y— and y4 . This is to say that y_ is in some /_ version of [wy,, W, +1], and use
the corresponding r = y_ and g(r, m) to define the Seiberg—Witten Floer homology
in degrees greater than k using these points. There are three parts to Property 5 that
address three cases that are consistent with what is described in Property 4.

Property 5a: Assume here that the top bullet in Property 4 is relevant for y. Use the
maps c(-) to extend the /4 —canonical basis as defined at y4 to give a new basis for
the Seiberg—Witten Floer complex at y_. Let ¢ and ¢’ denote the two generators that
are not distinguished by ay(,) — 272 Ja) — %cs g If ¢ and ¢’ have different degrees,
then this new basis at y_ is the same as the I_—canonical basis. If ¢ and ¢’ have the
same degree, make the convention that ¢(y+) = ¢, and ¢/(y+) = ¢,41 where ¢, and
tn+1 are I —canonical basis elements at y4 . With respect to the /_—canonical basis
at y_, either ¢(y—) = ¢, and ¢/(y—) = ¢,41, orelse ¢(y—) = ¢,41 and ¢'(y—) = ¢.
If the labelings do not change, then the respective /— and /4 canonical basis for
Seiberg—Witten Floer complexes as defined at y_ and y4 agree. If these canonical
basis agree, either for this reason, or because ¢ and ¢ have distinct degrees, then
the differential, §_, at y_ is related to the differential, 6, defined at y, as follows:
84 = A7186_A, where A is a degree preserving, upper triangular matrix with 1s on
the diagonal.

Suppose now that ¢ and ¢’ have the same degree and the labelings change as r crosses
y. Let d denote the degree of ¢ and ¢. In this case, the differentials are again related
by 84 = AT18_A, where A is a degree preserving matrix of the following sort: In
degrees not equal to d, the matrix A is upper triangular with 1s on the diagonal. In
degree d, the matrix A is such that Ay, = Ayyi1 041 =0, Appr1 =App1 =1,
Ayp=1ifv#norn+1,and Ay =0if v>0 and (v,V)# (n+1,n).

Properties 5b and Sc assume that the second bullet of Property 4 describes the situation
at y. In what follows, ¢ and ¢’ denote respective representatives of the two equivalence
classes that do not extend across y; and let d + 1 and d denote their respective Z/ pZ
degrees. The maps that are supplied by the the fourth item of the second bullet of
Property 4 are used to identify the remaining generators for the /_—canonical basis
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at y_ with the generators of the /—canonical basis at y4. This identifies the full
I_—canonical basis at y_ with the full /4 —canonical basis at y4 in degrees different
from d + 1 and d, and does so as the identity map.

Property 5b: Assume here that ¢ and ¢’ are defined for € I_. In degreed + 1, the
canonical basis at y is obtained from that at y_ by deleting the generator ¢; and
in degree d, the change is deletion of the generator ¢’. Note that this identification
preserves the ordering given by the value of ag,) —27? Jarn— % csg. Let V. denote the
vector space of cycles as defined for y . With the preceding identifications understood,
the vector space of cycles for y_ is then Zc @ Z¢' @ V4. Let 64 denote the Seiberg—
Witten Floer differential on V4 and let 5— denote that on Zc @ Z¢' @ V4. There is
a degree preserving homomorphism, T: Zc¢ @ Z¢' @ V4 — V with the following
properties.

e Té_= 8+T .
e T induces an isomorphism on homology.
e T maps V4 toitself as an upper triangular matrix with 1s on the diagonal.

* The value of ay(y) — 27r2fg(y) - %csE on any generator that appears in Tc is
less than its value on c.

* The value of ag(,) — 272 Sa) — %cs £ on any generator that appears in T¢ is
less than its value on ¢’.

Property 5c: Assume here that ¢ and ¢’ are defined for r € I+ . Let V_ denote the vector
space of cycles as defined at y_. With the aforementioned identifications understood,
the vector space of cycles at y4 is Zc @ Zc' & V_. Let §— denote the Seiberg—Witten
Floer differential on V_ and let §+ denote the differential on Zc @ Z¢' @ V_. There
is a degree preserving homomorphism T: V_ — Zc¢ @ Z¢ @ V_ with the following
properties.

o To_ = 5+T .
¢ T induces an isomorphism on homology.

e T is upper triangular with ones on the diagonal in degrees different from d + 1
and d.

e If u has degreed + 1, then Tu = Au + K, ¢ where A: V. — V4 is an upper
triangular matrix with 1s on the diagonal. Here, K;, = 0 for a generator u if the
value of ag(,) — 2n2fg(y) - %csE is less than its value on c¢.

e If v has degreed, then Tv = Av + K¢’ where A: V4 — V4 is an upper
triangular matrix with 1s on the diagonal. Here, K,, = 0 for a generator v if the
value of ag(,) — 27t2fg(y) — %csE on v is less than its value on ¢.
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But for two extra remarks, the arguments in [12, Section 7d] can be used to prove that
Properties 1-5 can be satisfied. These remarks concerns the matrices A and T that
appear in the a/ versions of what is written above.

Here is the first remark: The arguments in [12, Section 7d] use the solutions to [12,
(7.23)] to produce a degree preserving homomorphism that relates the respective vector
spaces over Z of cycles for the Seiberg—Witten Floer complex as defined by a given
value of r and distinct pairs, g— = ey +q— and g4 = e, + q+ from p. This matrix,
either A or T as the case may be, is denoted here as T . If ¢c— and ¢4 are respective
solutions to the corresponding r and g4 versions of (1-9), then the component along the
basis element ¢ of Tc_ is obtained by counting with signs a certain set of instanton
solutions to a version of [12, (7.23)]; this version is defined by a suitably generic map
s — q(s) from R into p with the property that q(s) = q— for s < —1 and q(s) = q+
for s > 1. As in [12, Section 7d], the instantons that contribute to the count have
two salient features. To state them, write the instanton as s — 0(s) = (A(s), ¥ (s)).
Also, for each s € R, let £4() denote the q = q(s) and (4,¥) = (A(s), ¥ (s))
version of the operator £, as described in Step 1. The first requirement for d(-) has
limg—s 00 0(s) = ¢— and limg—, o0 0(s) = % - ¢4 where # is a smooth map from M to
S!. The second requirement demands that the family {£a(s)}ser have zero spectral
flow. This understood, it then follows that the ¢4 component of T ¢_ is non-zero
only if the q = q_ version of f;(c_) is equal to the q = q4 version of f,(il-c4).
Meanwhile, with g(s) used to denote e, +q(s), the behavior of the function agy(.)((-))
on R is just as it was in the cases that are considered in [12, Section 7d]. These last
observations are needed to justify various assertions that T or parts of T are upper
triangular with 1s on the diagonal.

To begin the second remark, recall that when ¢ (det(S)) is torsion, the differential
on the Seiberg—Witten Floer complex has the following property: If ¢_ and ¢ are
solutions to some r and g = ¢, + q version of (1-9) (this is [12, (2.4)]), and if, when
viewed as basis vectors in the cSWF complex, the solution ¢4 appears with a non-zero
weight in §c_, then a(c—) > a(cy). This is because differential for the Seiberg—Witten
Floer complex was defined by counting a certain set of non-constant solutions to (1-10)
(this is [12, (2.11)]) and the equations in (1-10) are gradient flow equations for the
function ag. given in [12, (2.9)].

For the case at hand, the coefficient for ¢4 in dc— is again obtained as an algebraic
count of a certain set of solutions to (1-10). Indeed, recall that this coefficient is the
count with 1 weights of the components of a set, M;—1(c—, c¢4), that consists of the
instantons solutions to the r and g version (1-10) that have the following two properties:
Write the instanton as a map s — 0(s) = (A(s), ¥(s)). First, limg__o0 0(s) = c—
and limg_, 00 0(s) = 4 - ¢4 where # is a smooth map from M to S!. To state the
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second property, define, for each s € R, the operator £y, to be the r and g version
of Step 1’s operator £, as defined using the pair (4, ) = (A(s), ¥ (s)). Then 0 is
in M(c—, c4) if and only if the spectral flow for the family {£4()}ser is equal to 1.
This then means that f;(c—) = f4(i- c¢4) + 1. Meanwhile, it is still the case that the
equations in (1-10) for a map s — 0(s) = (A(s), ¥ (s)) are the gradient flow equations
for the function ag, this now defined defined as in (1-4) with g = ¢, + q replacing e .
This being the case, the function ag(0(-)) on R is non-increasing and constant if and
only if 9(-) is constant. Granted all of this, it follows that the coefficient that multiplies
¢+ in the basis expansion of §c_ is non-zero only if the value on c¢_ of the function
ag—2m? fy— %cs E is at least 2772 more than the value of this function on ¢ .

Step 3 Suppose here that ¢, r—, r and a path q(-) have been chosen so as to satisfy
the five properties stated in Step 2. Let {y,} be as described in Property 1, and suppose
that y € {y,}. Assume in what follows that Property 5b is the relevant part of Property
5 for y. With the notation from Step 2 understood, what follows is the analog here of
what is stated by [12, Lemma 3.16].

Lemma 2.6 Let ue V, denote the class such that Tu =T ¢ and let v € V denote the
class such that To="T¢ . If p > 2, there exists A € {1} such that §_(c—u) = A(d'—v).
As a consequence, there exists n € V4 of degree d such that §_¢ = Ac' +n and such
that the value of ag(y) — 272 a0y — %cs E on the generators that appear in n with
non-zero coefficient is no greater than its value on ¢'. If p = 2, either the preceding
conclusion holds as stated, or it holds after switching the roles of ¢ and ¢’ .

Proof of Lemma 2.6 In what follows, recall that p denotes the greatest divisor of
c1(det(S)). Let v € V1 denote the class with degree d such that To = T¢'. Let u
denote the class of degreed + 1 such that Tu= T¢. If p > 2, then §_(¢' —v) =0,
and if p = 2, there exists B € Z such that §_(¢’ —v) = B(c —u). Suppose first
that B = 0. Granted this, then no matter the value of p, the class ¢’ — v must equal
d—(tv+ Kc¢) for some K €7 and w € V4. Indeed, were this not the case, then T could
not induce an isomorphism on homology. Since 6+ T (tv + K¢) = 0, it follows that
T (ro+ Kc¢) =64+ T (o) for some class 0 € V of degree(d +2) mod (p). Again, this
is necessary if T induces an isomorphism on homology. As 6—o =t + K¢+ A(u—¢)
with A € Z, this implies that A5_(c—u) = ¢ —v. As ¢ is a generator, so 4 = £1
and therefore §_c = Ac¢’ + n where n = u— Av. The claim about the relative values of
the function ag(y) — 272 o) — %cs £ follows from the last two points in Property 5b
given that the respective values ag.) and — fy(,) on the s — —oo limit of an instanton
are no greater than their values on the s — oo limit of an instanton. a

Now suppose that B # 0. In this case, 6—(c —u) = 0 and so the argument just given
can be repeated verbatim after switching the roles of ¢ and ¢’.
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Step 4 Given what is said in the previous steps, the discussion in [12, Part 4a] and
[12, its proof of Proposition 4.2] can be repeated with only minor cosmetic changes to
identify the Seiberg—Witten Floer homology for different values of r in [1,00) —{p;}
S0 as to obtain a continuous, piece-wise differentiable function, r — ag (r) that is
defined on the whole of [1,00). The existence of the solution ¢(r) with the stated
properties follows from the min-max definition of ag .

2.3 Final arguments for Theorem 1.1

Proposition 2.5 is used in what follows to identify the respective Seiberg—Witten Floer
homology groups at distinct value of r € [1, c0) —{p; }. With these identifications from
Proposition 2.5 understood, say that a class 6 in the Seiberg—Witten Floer homology
in a given degree is a divergence class when the following is true: Given ¢ > 0, there
exists p; € (1,00) such that Definition 2.4’s function E(r) is greater than & when
r > pe. Granted this definition, what follows is a crucial part of the story.

Proposition 2.7 Fix w as in Proposition 2.1. Suppose that 0 is a divergence class.
The class 6 determines a constant, ¢ > 0, with the following significance: Fix r’ > 1
and there exists r > r’ and a solution (A, {) to the version of (1-3) determined by r
and ju that has the same degree as 6 and is such that cs/ (A, ) > cr? and E(A) > cr |

Proof of Proposition 2.7 But for two points, the proof of this proposition differs in
no essential aspects from [12, the proofs of Proposition 4.6 and Corollary 4.7]. Here
is the first point: Suppose that r is in the domain of some map ¢(-) from Lemma 2.2.
Then f(c(-)) is constant on some neighborhood of , and so %af = —%E. There is
much more to the second point. This concerns the bound given in [12, (4.9)] for cs(A).
In the case at hand, this bound must be replaced by a bound for cs/ . Proposition 1.9
supplies a useable bound.

Proposition 2.7 and Proposition 1.10 together imply that there are no divergence classes
in the Seiberg—Witten Floer homology. To elaborate, suppose to the contrary that 6 is
a divergence class. Take (A4, ¥) as in Proposition 2.7 for some very large value of r.
Proposition 1.10 asserts that |csf | < cor3'/16 when r is large. Meanwhile, Proposition
2.7 asserts that |csf | > cor?; so these assertions are incompatible.

As a consequence, given a non-zero Seiberg—Witten Floer homology class, there is
a form w € Q with C3 norm less than 1 and a sequence {(ry, (An, ¥n))in=1.2... C
(1, 00) x (Conn(E) x C°°(M;S)) with the following properties: First, {r,} is increas-
ing and unbounded from above. Second, (A, ¥,) solves the r = r, and p version of
(1-3). Third, the sequence {E(A;)} C R is bounded.
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If ¢;(E) # 0, then {supy,(1 —|¥,|)} also has a positive lower bound. To see why,
note first that 1 — [y, > 1 — |atn| — cor,,_l/2 by virtue of what is said in Lemma 1.6.
As c1(FE) is not zero, and as o, is a section of E, there exist points in M where |oy|
vanishes. Thus supy, (1 —|¥|n) = 1 —cory /2 Granted these bounds, the statement
of Theorem 1.1 in the case c;(E) # 0 follows directly from the statement of Theorem

1.5.

Consider next the case where ¢;(E) = 0. The argument used when ¢ (E) # 0 to find
a positive lower bound for {sup,,(1 — |¥,|)} won’t suffice because E is the trivial
bundle. In fact, there is a solution for all » > 1 with bounded energy to a special
version of (1-3) for which the corresponding values of sup,,(1 —r|y|) limit to zero.
To explain, reintroduce the section, 1¢, of E with norm equal to 1. Use this section
to trivialize £ and let A; denote the corresponding product connection. The pair
(A7, ¥ = (1¢,0)) has E(A) = 0; and for any r > 1, this pair solves the equations

By = r(zﬂtw —ia).

(2-2)

Dy =0.
As the next proposition shows, this solution to (2-2) has a counter-part that solves
(1-3). O

Proposition 2.8 There exists r; > 1 and § € (0, %) with the following significance:
Fix ;v € Q with C3 norm less than 1 and fix r > ry. Then there exists a unique gauge
equivalence class of solutions to (1-3) with the norm of the spinor component nowhere
less than 1 — §. Moreover, E has an r independent upper bound on this equivalence
class.

This proposition is proved shortly. Granted this proposition, suppose that the Seiberg—
Witten Floer homology has two or more generators. As at least one of them won’t
be the gauge equivalence class supplied by Proposition 2.8, there is a sequence
{(rn, (An, ¥n))} that satisfies the assumptions of Theorem 1.5. Thus, the assertion of
Theorem 1.1 follows in this case.

Suppose instead that the Seiberg—Witten Floer homology vanishes. Fix p as in Propo-
sition 2.1 and let {p;} C (r, 00) denote the set supplied by this same proposition. Let
pi € {p;j}. With Proposition 2.3 in mind, let #, € {ty},eyq) and let r € [ty tyny1).
Use the r and g = ey + q;,, versions of (1-9) and (1-10) to define the Seiberg—Witten
Floer complex, but use the canonical basis as labeled by the gauge equivalence classes
of solutions to the » and p version of (1-3). Proposition 2.8 supplies a particular
generator for each such version of the Seiberg—Witten Floer complex. Use ¢; () to
denote this fiducial generator. Note that the degree of ¢;(r) in Z/ pZ is independent
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of r when r is sufficiently large. Indeed, this follows from [12, Lemma 5.4]. This
understood, normalize the degree so that ¢;(-) has degree zero in Z/pZ . Note that
a’ (¢; () is a differentiable function on (ry, 00).

For each r € (r7, 00) —{p; } use B(r) to denote the set of cycles n in degree —1 that
can be written as n = §(cy + tv) where w can be written without the generator ¢y . For
each such cycle n, use a/ (n,r) to denote the maximum of a/ on the generators that
appear in n with non-zero weight. Now set a7 (r) to denote the infimum of the set

{0/ (0. 1)} nes(r) -

With alf (r) now defined, replace 6 in the statement of the second bullet of Definition
2.4 with B(r) and likewise replace af g(r) with af; (7). Use these replacements in
Definition 2.4’s second bullet to define E(r), v(r) and §(r).

Proposition 2.9 Given that the Seiberg—Witten Floer homology is trivial, there exists
rrx > rp such that if r > rp, and if w lacks the generator ¢y, then §(¢cy + 1) # 0.

This proposition is proved at the end of Section 5.

Proposition 2.10 The function a/ ; extends to (ryx, o) as a continuous and piece-
wise differentiable function. In fact, there is a countable set in (ry4, 00) and a smooth
map, c(-) = (A(-), ¥ (-)), from the complement of this set into Conn(E) x C*°(M;S)
such that for each r in the domain of ¢(-), the configuration c¢(r) is a non-degenerate
solution to the r and p version of (1-3) with afl(r) = af(c(-)), E = E(A(r)) and
v = cs/ (c(r)). In addition, the generator that is defined by ¢(r) appears with non-zero
coefficient in a cycle from B(r).

Proof of Proposition 2.10 Granted that B(r) # @ when r is large, the proof uses
the chain maps from the first three steps of Proposition 2.5 to prove that a7 has the
desired extension. With these chain maps available, the argument is, but for cosmetics,
the same as that given in [12, Section 4a] to prove the latter’s Proposition 4.2.

With Proposition 2.10 in hand, use Proposition 1.9 and the argument in [12, Section
4] for [12, Proposition 4.6 and Corollary 4.7] with ag replaced by al7 to prove the
following analog of Proposition 2.7: There exists a sequence {ry, (A,, ¥,)} with {r,}
increasing and unbounded, with (A, ¥,) satisfying the » = r, and p version of (1-3),
with (A, ¥y) in B(r,), and with one of the following two properties:

{E(Ay)} is bounded.
(2-3)

E(A;) > crp and c5f(An, Vn) > crp? where ¢ > 0 is independent of .
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The second option in (2-3) is ruled out by Proposition 1.10. Meanwhile, [12, Lemma
5.4] guarantees that {sup,,(1 — |¥|)} must be bounded away from zero by an n—
independent, positive number when n is large because the Z/pZ degree of (A, ¥y)
differs by 1 from that of (Aj, ¥y). Granted all of this, an appeal to Theorem 1.5 finds
the desired set of closed, integral curves of the vector field v. a

2.4 Proof of Proposition 2.8

Consider looking for a solution that has the form (A4, V) = (A7, ¥7) + ((2r)'/2b, n)
with (b,n) € C®°(M;iTxM @ S). The pair (A4, ) will solve the r and u version
of (1-3)if b= (b,n,¢) € C®(iT*M @S @ iR) solves the system of equations

2-4)
xdb—dp — 27V 2yl e+ ey —r V2t ey = %r‘l/z(*du + k).
D n+2' 2 2 (Ab)yr + pyrp) + 22 (cl(B)n + p) =0,
sd b =272 2Ty —y Ty =0,

Let £y denote that (A7, ¥7) the version of the operator that appears in (1-7). Then
(2-4) has the schematic form £ob + r1/2bxb = r~1/2y. According to [12, (5.25)],
£y is invertible when r is large, so a solution, b, to (2-4) can be viewed as a fixed
point of the map

(2-5) h— T(h) = Lo (™ 2v—r2pxp).

To see that the map 7" has a fixed, point, introduce the Hilbert space H that is obtained
by completing C*°(M;iT+«M @& S & iR) using the norm | - || whose square has
value on f given by

1
-6) Il = [ 1902 + 47 [ 10F%
M M

Here, V is defined so that V;(b,n,¢) = (Vb,V4,n,d¢). [12, Equation (5.23)]
guarantees that

(2-7) 1€0bl2% > 16>

when r is large. Because |Vh| > |d|h|, a Sobolev inequality guarantees that ||h||g
dominates the L? norms of h for p < 6. In particular, there exists co > 0 that is
independent of b and r and such that ||h|lm > col|h||¢. This inequality implies that

(2-8) 161la* < collbliZgllbll2 < cor ™[I ]m*.
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The inequality in (2-8) implies that 7' extends to give a smooth map from H to itself.

Granted this fact, fix R > 2|v||, and let Bg C H denote the ball of radius r~'/2R. As
is explained next, 7" maps Bp to itself as a contraction mapping when r is sufficiently
large. Indeed, it follows from (2-7) and (2-8) that

170 < 5 Lm12R 4 2 )42 < 3 PR e RO
(2-9) |
< LrRRA 4 20 RAY)

when b € H. A similar calculation proves that || 7(h)—T'(h") |li < cor "4 R||h—b' ||
when b and b’ are in H and r is large. These bounds with the contraction mapping
theorem imply that any large r version of 7" has a unique fixed point in 5. Standard
elliptic regularity arguments can be employed to prove that the fixed point is smooth;
thus the fixed point is a section of C®(iT*M @ S @ iR) that obeys (2-4).

Consider next the norm of ¥ = ¥y 4+ n. To this end, write the middle equation in
(2-4)as D4, n=r'"2([h] 4 [h ® h]) where [] is shorthand in each case for some linear
endomorphism with an r—independent pointwise norm. Use the Green’s function for
the operator D4, to conclude that

(2-10 |n|sco||h||z+cw1/2:35ﬂ[d e LRALIR}

Now, if u is an L% function on M , then the function dist(x, -)_1 u is square integrable,
and its norm is bounded by a constant multiple of the L?; norm of u. Granted that
such is the case, (2-10) implies the following: There exists an r independent constant
0o such that for any p € (0, pg) one has

(2-11) Il < collbll2 +cor /(021012 + P2 16 ]lm + 1HlE>)-

Take p = r~1/4 in (2-11) and use the fact that ||§||m < cor~'/2 and ||h||» < cor to
conclude that || < cor~'/*. Thus, || > 1—cor~'/%.

Turn now to the uniqueness assertion that is made by Proposition 2.8. Suppose that
8 € (0, %) has been given and that (A, ¥ = («, B)) is a solution to the r and p version
of (1-3) with the property that 1 — || < § at all points in M . This being the case, it
follows from the bounds in Lemma 1.6 that |a| > 1 —§ — cor~'/2 at all points in M .
Given ¢ > 0, one can now argue as at the end of [12, Section 8] that there exists &g
such that if § < §y, then the bounds in [12, (5.24)] hold. The same scaling arguments
used in [12, Section 8] prove that

(2-12) IV(Va)| < er and [V (V'B)| < er!/?,
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can be assumed as well.

Because o is nowhere zero when § is small, there exists u € C*°(M; S!) such that
e’ o = |a|1c. Change (A, ¥) to this new gauge, but use (A4, V) again to denote the
resulting pair of connection and spinor. Because ¢ = (¢, f) with o = |«|1¢, the
connection A has the form 4 = A; + a with

1
(2-13) a= 5(orlw—&—lw).
What with [12, (5.24)] and (2-12), this implies that

(2-14) r=12\a] + 17 Va| < coe.

It is now necessary to change to yet another gauge so that the result can be written as
(A +2Y2¢ Y2y + 1) where b and 5 obey the equation that appears in the third
bullet of (2-4). This is done with a gauge transformation that has the form e* with
x € C°°(M ;iR). Given any such x, the resulting (b, ) has the form

(2-15) b=2"Y2"1Y2@G —dx) and n = ("*|a| — 1)y + €*(0, B).
The equation in the third bullet in (2-4) is obeyed if x obeys the equation
(2-16) d¥dx + 2r|a|sin(x) = da.

As explained shortly, if ¢ is small, and then r is sufficiently large, this equation for x
can also be solved using a fixed point strategy and the solution obtained obeys

(2-17) Ix| + r~V2dx]| < coe.

To see how this works, write A, = dTd + 2r || This operator is invertible and so a
solution to (2-16) obeys x = 7 (x), where

(2-18) T(x) = A7 '[dYa + 2r || (x — sin(x))].

In order to prove the existence of a fixed point of the right sort, introduce the Banach
space CO(M;iR). Given p € (0, 1), let B, denote the ball in this space where the
norm is bounded by p. As is argued next, there exist » —independent constants p and &
such that if ¢ < &4 then 7 maps B, to itself as a contraction mapping. This argument
uses the following lemma.

Lemma 2.11 There exists k > 0 such thatif ¢ <k and r > 1, then the following is true:

If g € C®(M;iR) and y € C®°(M;iR) obeys A,y = g, then r|y| + r'/?|dy| <
Ksupyy [g].
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This lemma is proved shortly. Given the bound from the lemma for the supremum
norm of the solution to A,y = g, it follows from (2-14) that

(2-19) 1T (x)| < cole + (s;p Ix])%).

Thus, 7 maps B, to itself if ¢ < %co_l,o and p < %Co_ 1. A similar calculation finds
that 7 is a contraction if p < py with py independent of r. Granted these bounds,
then 7 has a unique fixed point in B, and the fixed point, x, obeys |x| < coe. Elliptic
regularity then implies that x obeys (2-16). The bound on |dx| asserted by (2-17)
follows from (2-14) given what is said about |dy| in Lemma 2.11.

To continue with the proof of the uniqueness assertion in Proposition 2.8, now use
(A4, ) to denote the gauge transformed pair with 4 = Ay +21/2p1/2p and = Y+
where the pair (b,7n) obeys the equation given in the third bullet of (2-4). Write
b = (b, n,0) and note that by virtue of (2-14) and (2-16), this section of the Hilbert
space H obeys |b| < coe. It is also the case that b is a fixed point of 7. Thus,
if b is in the ball Bg, then it must be the contraction mapping solution. To prove
that such is the case, recall that the fixed point equation is equivalent to the equation
£0b=r""2y 4 r1/2p % b. This, (2-7) and the bound of cye on sup,y |b| imply that

(2-20) Il < =2 ||vll2 + cor'/2ellbll2 < r 72 ||v]l2 + coel bl

Hence if ¢ < %co_l , then b is in the radius ~V2R ball in H if R is greater than a

suitable r —independent lower bound and r is large. Thus, the given solution is gauge
equivalent to the contraction mapping solution.

Proof of Lemma 2.11 Suppose that g € C°(M;iR) is given and that y solves the
equation dTdy +2r|aly = g. If |a| > % then
(2-21) d'd|y|+rlyl < gl.

and so the maximum principle implies that |y| < 1 sup,, |g|. To obtain the bound
for dy, differentiate the equation A,y = g to obtain

(2-22) VIVdy + Ric(dy) + 2r|a|dy = dg — 4rd|a|y,

where Ric(-) is defined using the metric’s Ricci tensor. When p € M, use Gp(-) to
denote the Green’s function for the operator VIV + Ric(-) + 2r on CO(M ;i T+ M)
with pole at p. A maximum principle argument just like that employed for (2-21)
establishes the following: When w € CO(M ;i TxM), then |Gp(w)| <cor™! sup,y |w].
This then implies that

(2-23) sup |dy| < co(sup |1 —|a|l) sup|dy| +co sup|d|al| sup [y + sup |G,(dg)]
M M M M M peM
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Thus,

(2-24) (1—coe) sup |dy| < coer™"?|g| + sup |Gp(dg)|.
M PEM

To bound the last term in (2-24) in terms of the supremum norm of g, it is necessary
to integrate by parts and then obtain a bound for the norms of the derivatives of the
section x — Gp(x). This can be done readily using standard parametric techniques
and results in the bound

1 .
2-25 VG (x)| <o o /rdist(p.x)
(225) IVGp (0] = oo s
Thus, an integration by parts shows that G,(dg) obeys
1 .
2-26 Gpldo)| <co | ——— e VrastP) g < o2 sup ||,
@26 [Gydg)l < oA[ T gl < cor™suple

and so |Gp(dg)| < cor /2 sup s |g]. This bound with (2-24) completes the proof of
the lemma. O

3 Proof of Proposition 1.9

Before starting, it is worth noting that what is asserted in Proposition 1.9 holds whether
or not the 1-form a that appears in (1-3) is a contact form. It is only required that a
be smooth and have norm 1. To elaborate, note that the proof that follows assumes
that (A4, ¥) obeys (1-3) and that the conclusions of Lemma 1.6 and Lemma 1.7 hold.
These two lemmas are proved in [12, Sections 6a—6c], and their proofs make no use of
the assumption that da = 2 * «a or that a A da > 0.

Assume in what follows that » > 2. Let (Ag, ¥ g) denote the pair in Conn(E) x
C°(M;S) that is used for the definition of f. Note that the curvature of Afg is
a harmonic form whose L2 norm, and thus C¥Z° norms are bounded a priori. An
appeal to Lemma 1.8 finds a smooth map u: M — S suchthat A—u~'du= Ag+a
where |@| < cor?/3(1+|E[)"/3. Use 4 now to denote Ag +a and ¥ to denote the
corresponding gauge transformation of what was originally called .

The bound just given for @ implies that
(3-1) les(A)] = cor® (1 + (e,

as can be seen by repeating the argument for [12, (4.2)]. Granted (3-1), the assertion
made by Proposition 1.9 follows with a suitable bound on | f(A4, ¥)|. Note in this
regard that the bound given by Proposition 1.10 does not serve for the purposes at hand.
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3.1 The bound for f

A bound for the spectral flow is obtained in two steps. The first step bounds the absolute
value of the spectral flow for the 1-parameter family of operators {£s}e[o,1] Where £
is given the version of (1-7) that uses (4, ¥) but has r replaced by s%r. The second
step bounds the spectral flow for the family of Dirac operators {D s }se[o.1] Where
A =A+sa.

As explained next, both steps employ the strategy that is outlined in [12, Section 5b],
and in [11]. To begin, suppose {Ls = L + qs}se[o,1] 18 as described in [12, Section 5a].
Take the diffeomorphism ® from of [12, Section 5b] to be the identity map from R to
itself, and fix 7' > 0. Let ny denote the number of linearly independent eigenvectors of
L whose eigenvalue has absolute value no greater than 7", and let n = sup{n;}seo,1]-
Introduce the function gp(s) as in [12, (5.6)]. Then the spectral flow for the family
{Ls}sef0,1] has absolute value no greater than

(3-2) —n sup{ H

op }s €[0,1] ’
where the norm || - ||, here denotes the operator norm.

In the case of {L}, the supremum in (3-2) is bounded by cq r1/2 For the family

of Dirac operators, the analogous norm is bounded by c¢g|a|, and thus by cor?3(1 +
|E[)!/3. In both cases, T will be taken to be (1 + |E|)!/? with E = E(4). This
understood, the spectral flow in the case of {L} is bounded in absolute value by

(3-3) cor'2(1+[E)™/?n
and in the second case, by

(3-4) cor?3(1 + [E))™V®n.

Granted the preceding, the proof Proposition 1.9 requires only a suitable bound for n
in the two cases. Note in this regard that the bound given by [12, Proposition 5.2] does
not suffice. The following proposition supplies the desired bound.

Proposition 3.1 There exists a constant, k > 1, with the following significance:
Suppose that r > i, that i« € Q has C* norm bounded by 1, and that (A, V) is solution
to the r and w version of (1-3). For s € [0, 1], define Ly to be either the version of
(1-7) that is defined using (A, ) but with r replaced by s’r, or the Dirac operator
Dy, 45(4—Af)- Set E = E(A) and let ng denote the number of linearly independent
eigenvectors of L whose eigenvalue has absolute value lIess than (1 4 |E|)!/2. Then
n < (1 + [E])>2(nr)~.
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Proposition 1.9 follows from Proposition 3.1 with (3-1), (3-3) and (3-4).

The strategy that is used to bound n is described next and the remaining subsections
supply the details. To begin the story on n, let H denote the domain Hilbert space
of the family {£s}. Thus H = L%(i T+M &S @ iR) when {L; = £4}se[0.1] Where
£, is the version of (1-7) that has r replaced by s%r. Meanwhile, H = L?;(S) when
{Ls = D4y +5(4—ax))sefo,1]- In each case, the bound on n is obtained by exhibiting
a set, ®, of points in M with the following properties.

The set © has at most « (1 + |E|)3/2(Inr)¥ points.

Let 9 g denote the span of the set of eigenvectors of L; whose eigenvalue
has absolute value 1 + |E| or less. If j € ¥, and vanishes on ®, then j
is identically zero.

The proof that such a set ® exists exploits certain pointwise and L? bounds on the
covariant derivatives of the elements in 9. The desired L? bound uses little more
than the Bochner—Weitzenboch formula for £42. The pointwise bounds require more
work since the maximum allowed size of the covariant derivative of an element in ¥ g
at any given point in M is mostly determined by the size of | B4| in a surrounding ball.
In particular, a region in M where |B4| is relatively large must contain more of ®’s
points than a corresponding region where | B 4| is small. This unavoidable complication
is accommodated by decomposing M into cylindrical regions where r(1 —|a|?) is
significantly greater than 1 + |E|, and the complementary part where this function is
roughly 1+ |E| or less.

Such a large/small curvature decomposition is facilitated by the introduction of the
notion of an adapted coordinate chart map from C x [—4, §] into M . Here, C C C
is the disk of radius § centered at the origin. Given a positive number, R, that is less
than %8 ,use Ar C C to denote the disk with center at the origin and radius R. In
what follows, R is taken to be the maximum of 100r~'/2 and v(1 + |E|)~'/2 with
v € (0, 1) specified below. The following lemma supplies a cover of M by the images
of adapted coordinate chart maps. Its proof is straightforward, and so omitted.

Lemma 3.2 There exists a constant, ¥ > 1 with the following significance: Given
R € (0, %8), there is a set, ®, of adapted coordinate chart maps from C x [—6, §] into
M with the following properties.

e There are at most kR~ elements in ®.
s Upead (AR x[—+R, I R]) covers M.

e No point in M is contained in more than k elements of the set {¢p (AR X
[-R. R)}geo-
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The set © has a decomposition as Ugeg®y, where the points in Oy reside in the
¢—image of Ag x[—R, R]. A bound on the number of points in @ is determined by

(3-5) Ep=T / 11— |a|?].
¢(ARX[~R,R])

In particular, the number of points in ® is no greater than « (1 + R2E¢)(lnr)" where
k > 1 is independent of r, (A, V), ¢, and R. Since ® has at most kR™3 elements, it
then follows that ® has fewer than kR~ (Inr)“(1 4+ R? >_¢ed Ep) points. What with
the second bullet in Lemma 3.2 and Lemma 1.6, there is a constant, ¢, such that

(3-6) > " Eg <co(1+[ED.
Pe®

Thus, the set ® has fewer than kR~3(1 4+ R?|E|)(Inr) points. Since R~ <v~1(1 +
|E|)1/ 2 this gives the asserted bound on 7 given that v is chosen to be independent of
r, E and (4, V).

3.2 Integral bounds for norms of elements in

The desired bounds exploit the formulas for £, and [,s2 in a number of ways. Such
formula are first used to derive an a priori bound on the L? norm of the covariant
derivate along v of any given j € ¥g. The following lemma states what is needed.

Lemma 3.3 There exists k > 1 with the following significance: Fix r > 1, a form
w € Q with C3 norm bounded by 1, and a solution, (A, ), to the r and ju version of
(1-3). Set E =E(A). Fix s €0, 1] and let L denote either the version of the operator
in (1-7) with r replaced by s°r, or the Dirac operator Dy +s(4—ap)- Let j denote a
linear combination of those eigenvectors of L; whose eigenvalue has absolute value
less than (1 + |E[)!/2. Then

1V jlla < (1 +[EDY2] ]2

here V,, denotes the covariant derivative in the direction v as defined using the connec-
tion A in the case where L is given by the r — s2r version of (1-7), and as defined
using the connection Ag + s(A— AEg) in the case where Ly = D g, 4s(4—Af)-

Proof of Lemma 3.3 The simpler case is that where L; is the Dirac operator and so
this case is considered first. To this end, suppose first that j is as described by the
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lemma. No generality is lost by assuming that || j ||, = 1. Use q to denote £y2j. The
Bochner—Weitzenboch formula for the Dirac operator reads

1
(3-7) VIV 45 cl(By)) + R =

Here R denotes an endomorphism of S that is independent of r and (4, v); in
particular, it is uniformly bounded. Meanwhile, V denotes the covariant derivative on
S that is defined by the connection A g + s(A — A ) and the canonical connection on
K.

Write j = (jo, j1) and q = (qo, q;) using the decomposition of S as E @ EK!.
Take the L? inner product of (3-7) with j; and, what with Lemma 1.6, the result
implies that

(3-8) IV il 4 s (= al?), 1j11%)2 < co((j1, a1)a + 1),

Here, (, ), denotes the L2 inner product. To say more about how this inequality
comes about, remark that there may be terms from the inner product of j; with VIV
of the form (i, % jo) and (j;, %1V jo) with Ty and T; being r—independent. The
former contributes to the term cq - 1 on the right hand side of (3-8), and the latter can
be written after an integration by parts as —(V’ j1, %1 jo) + (Jj1, T2 /) with T, also r—
independent. Holder’s inequality bounds this by some small multiple of |V’ j || 22+ ¢,
and so this term can be accommodated by increasing the constant ¢y on the right
in (3-8). The inner product of j; with the curvature endomorphism in (3-7) gives a
term not shown in (3-8) that is bounded by rs|8]|j1||jo|. Lemma 1.6 bounds this by
Y2511 —1a)1Y2| 11 jo| + ol 1l jol. and so this too can be accommodated in (3-8)
by making ¢y somewhat larger.

Since ||q1]l2 < llqll2 < (1+|E|), what is written in (3-8) finds ||V’ j; [|2 < co(1+|E|)!/2.
This last inequality implies the desired bound for the L? norm of the directional
derivative of j;. To obtain the desired bound for V), jg, introduce q = (qg,qq) to
denote Ly j. The E component of the equation Ly j = q equates V, jo with qg, linear
combinations of the directional derivatives of j; along the kernel of a, and multiples
of j; by functions that depend only on the metric. This understood, it follows that
IVujoll2 < colllaolla + (1+ [EN'/2) < co(1 + |E[)!/? since the L2 norm of qq is no
greater than that of ¢, and the latter is no greater than (1 + |E[)!/2.

Consider next the case when L; is the operator r — s2 version of (1-7). As in (1-7),
write the components of j as (b, 7, ¢); and assume again that ||j|, = 1. Use g to
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denote L2 j. The corresponding three components of ¢ are
VIV 4+ Ric(b) + 252y |2b + 2r 2 (T vy — (Vy) )
VA Van+cl(By)n

(39) + g Rn=s7rlty —y Ty + ey 4ty
—2/2sr'2b . Vy,
dide + 25%r |y |?¢.
The last equation in (3-9) implies, that

(3-10) ldgll2? +s*rlgvl2® < llall2lll2,

and so ||d¢||2 < (1+|E[)!/2. To continue, introduce b, to denote the contraction of b
with v. In addition, write 7 = (179, 1;) as per the splitting of S. Take the L? inner
product of the top equation in (3-9) with bya, and take the L? inner product of the
middle equation in (3-9) with n;. With the aid of Lemma 1.6 and some integration by
parts, the resulting expressions imply that

2 .
G-11) [ldbyll2® + 1V'mllz” + s*rllbovll2® + Im ¥ 112%) < co(1 + 1 12 ]1all2)-

Since ||q]l2 < (1 4+ | E]), this gives the desired bounds on the directional derivatives of
by and ;.

The desired bounds on the directional derivative of 1y and of b — bya along v are
obtained by noting that the L2 norm of L,/ is bounded by (1 + |E[)'/2, and noting
the following: First, the component along the kernel of a of the top line in the r — 52
version of (1-3) contains V(b — bya) and no other derivatives of b — bya. Moreover,
the remaining terms consist of derivatives of b, and ¢, and terms with norm bounded
by sr'2(|B]Inol + |¥|[n1]). In particular, Lemma 2.2 and (3-10) and (3-11) imply
that the L2 norms of these added terms are no greater than co(1 + |E|)'/2. Meanwhile,
the component in E of the second line in the r — s%r version of (1-7) consists of V¢
and no other derivatives of 19. The remaining terms are combinations of derivatives of
11 and terms that are, in any event, no greater than by sr1/2(|by| + |¢|)|¥|. By virtue
of (3-10) and (3-11), these latter terms have L2 norms bounded by co(1 + |E[)}/2. O

Let j be as described in this last lemma. The next lemma gives an upper bound for the
L? norm of j over certain balls in M when j vanishes at the ball’s center.

Lemma 3.4 There exists k > 1 with the following significance: Make the same
assumptions as in Lemma 3.3 and let j be as described in this same lemma. Let
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U C M denote a ball of radius p < (1 + |E|)~'/2 and suppose that r (1 — |a|?) < p~2
on U . Suppose, in addition, that j = 0 at the center point of U . Let o € (0, %) and let
Uy denote the ball with the same center as U and with radius op. Let q = L2 j . Then

/|j|25m4(/|j|2+p4f|q|2).
Uy U U

Proof of Lemma 3.4 As before, the simplest case is that where L3 = Dy, 45(4—ay)-
To argue for this case, note first that the curvature, B, of the connection A; = Ag +
s(A— Ag) is bounded by cop~2. As a consequence, there is a trivialization of E|y
so that the connection Ay appears as A; +a, where d *a =0 and |d| < cop~ ! in the
ball, U’, with radius % p and center that of U . Use Gaussian coordinates to trivialize
TM |y . The trivialization of E|y and TM |y identifies S with U x C? and turns j
into a C%—valued function on U. As such, j obeys an equation in U’ that has the
form

(3-12) dxdj=Ty-j+T;-dj +q,

where |Tg| + |d % T'y| < cop™? and |T'y| < cop~!. For x € U’, use Gy(-) to denote
the Greens function of d * d with pole at x. Then j can be written on U, as

613 = [(GonTo 4 Tdi 0+ [ Gad.

U u-u’
where x4« and s+ are smooth functions with sup-norms bounded by ¢y and with
compact support in U . With x viewed as the variable, the Green’s function G is such
that |G (»)| < col(-) — y|~! and l[dGy(¥)] < col() — ¥|72. As is explained shortly,
these bounds and the fact that j|o = 0 can be used with (3-12) and (3-13) to prove that

(3-14) 1%l = ol (0721l jll2sv + llall2:)

at points x € Uy 4. Here, |- |2,y is used to denote the L? norm on U of the indicated
function. This last inequality implies what is asserted by the lemma.

To see how (3-14) arises, let g denote an L? function on U . Break the integral

(3-15) / G — Golg
U

into two parts, the first where the distance to the origin is greater than 4|x|, and
the second where the distance to the origin is no greater than 4|x|. Where y € U
obeys |y| > 4|x|, use the bound |G (y) — Go(¥)| < Co|x|/|y|*. In the region where
|¥| < 4|x|, use instead the bound |Gx(y) — Go(»)| < co(|x — y|~' + |¥|71). These
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bounds with the standard inequality | [ mg| < ||m|2,¢/||g|l2,v imply a bound for (3-15)
U

of the form ¢q|x|'/2||g|| 2,U - Note that (3-12) is used to eliminate a term on the right
hand side of (3-14) that contains the L? norm of dj. Such a term can be replaced
by the two terms present by using (3-12) to bound that the L2 norm of dj on U’ by
co(p 1 jll2:u + pllall2;v) . To obtain this bound, contract both sides of (3-12) by j,
multiply the result by a suitably chosen bump function with support on U, and then
integrate over U. An integration by parts will lead to an expression that gives the
asserted bound for the L2 norm of dj. Equation (3-14) implies the lemma’s assertion.

Now consider the case where L is the r — s2r version of (1-7). With S and TM
trivialized over U as before, then j = (b, n, ¢) can be viewed as an function on U
with values in iR3 x C x iR. What with (3-9) giving L2, this function obeys an
equation of the form

(3-16) dxdj+2s%rj=To-j+Ty-dj +sr'/?T3(Vy) - j +q.

where |I'3(Vy)| < co| V| at each point. Here again, |To| < cop~2 and |T'y| <cop~!.
To proceed from here, note first that there is a bound for |Vy/| in U’ of the form
(3-17) IVl <cop™ .

This bound is justified shortly. Granted (3-17), the second point to note is that the
Green’s function to use with (3-16) is that for the operator d % d + 2s%r Let Gx now
denote the Green’s function for this operator with pole at x. This new version of Gy
obeys

e—5C@NV210-y] 4oy

G
G TR

(14 sr172)() =D s
O —»P

But for some straightforward modifications, the arguments for (3-14) can be repeated

using (3-17) and (3-18) to prove that

(3-19) 1Ll < comin((s*r) ™4, XY (072 v + lallsw),

when x € U, . This last bound implies the inequality that is stated by the lemma.

(3-18)
[dGy(¥)| < Co

()=l

To tie up a loose end, consider now (3-17). A bound for |Vy| on U’ is obtained
by differentiating the equation D4y = 0 to obtain an equation for Vi that has the
schematic form D4V +RY¥ + B4y = 0. Here, the components of R come from the
Riemannian metric, and B4x* is a homomorphism whose components come from B4.
To use this equation to bound |V| at a given point p € U’, it proves useful to change
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the trivialization of E|g . To this end, trivialize E now by parallel transport via A along
the radial geodesics from p. At the same time take a Gaussian coordinate chart centered
at p and use these coordinates to trivialize T M |y . These trivializations together induce
a trivialization of S|y and so identify its sections as C?2 valued functions. Using this
trivialization, the connection 4 appears as Ay +a?, where Ay is the product connection
for the trivialization, and where a? obeys |a”| < cop~? dist(p,-). The Christoffel
symbols for the metric also vanish at p.

With the preceding understood, introduce next Gy, , to denote the Green’s function for
the operator D4, on S ® T*M with pole at p. With the trivialization of S over U
given, Gy p(x) at x € U appears as a matrix valued function on U. As such, it obeys
|G1.p(x)| < codist(p,x)™2 and |dGplx| < co dist(p,x)73. Use Gy, to write V|,
as

VYl = - / Grpx claP)Vy
U

(3-20) - / GrpxY (RY + By * )
U

+ / Gr.pcldx¥)Vy,
U

where xU is a smooth function with compact support on U that equals 1 where the
distance to U’ is less than p/8. Moreover, |dxY| <32p~! and |VdxY| < 1056p2.

Granted these bounds and the bound || < 1, integration by parts finds the absolute
value of the right most term in (3-20) bounded by cop~!. With |By| < cop™2, the
bound on the norm of Gy , directly yield a bound by ¢ p~ ! for the absolute value
of the middle integral on the right hand side of (3-20). As for the left most integral
in (3-20), the bounds on |a?| and |Gy, ,| imply that their product has L? norm on
U that is bounded by p3/2 Asa consequence, the absolute value of the left most
integral in (3-20) is no greater than

(3-21) cop 21XV V.

A bound by cop~! on the left most integral on the right side of (3-20) follows from

(3-21) given that ||xY V|, < cop!/2. This last bound is obtained by using the
Weitzenboch formula in (3-7) with j = ¥ and so q = 0. To elaborate, take the L>
inner product of both sides of the j = v and q = 0 version of (3-7) with (xY)?,
and then integrate by parts. The result directly implies the desired norm bound given
the bounds for |B4| and |dxY]. ad
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Lemma 3.4 is used to prove bounds for the L? norm of j over cylinders.

Lemma 3.5 There exists k > 1 with the following significance: Make the same
assumptions as in Lemma 3.3 and let j be as described in that lemma. Fix R as
described just prior to Lemma 3.2 and let ¢: Agr x[—R, R] — M denote an adapted
coordinate chart map. Use ¢ to implicitly identify its domain and image. Fix p €
(%r‘l/z, L R) to insure that r (1—|a|?) < p~2 on A, x[—p, p], and suppose that j =0
at (0,0). Set g = L*j. If o € (0, 1), then

/ PR <« [ (R2Vyj 2 + 012 + Ra*o’la]?).
AgpX[—R+p,R—p] Apx[—R,R]

Proof of Lemma 3.5 Let 7 € [—R + p, R — p], and with p’ either op or p, let f(¢)
denote the L2 norm of j over the ball in Ag x [-R, R] with center at (0,7) and

radius p’. Note that
1/2
Vo) |2) :

Let U denote the ball of radius p in Ag x [—R, R] with center (0,0), and use the
o' = op version of this last inequality with Lemma 3.4 to conclude that
(3-23)

(3-22) [§(6) = (") = co (R/O'

Apx[—R,R]

12 < coR? / Vuil +eo( /(|,|2+p|q|)
Aopx[—R+p,R—p] ApX[—R,R]

Next, use the p’ = p version of (3-22) to conclude that

R [, . . .
(3-24) ;/W <c¢o / (R*|Vyjl2+1j1%).
Ay, x[—R,R]

These last two inequalities imply what is asserted by Lemma 3.5. a

Lemma 3.5 and Lemma 3.3 are key inputs to the proof of Proposition 3.1.

3.3 Refined bounds for the norms of ¥ and Vy

Additional bounds for ¥ and its covariant derivative are needed in order to exploit
Lemma 3.5. The next lemma supplies the required bounds.
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Lemma 3.6 There exist constants k > 1 and ¢4 € (0, %) with the following signif-
icance: Suppose that r > k, 1 € Q has C3 norm bounded by 1, and that (A, V) is
a solution to the r and p version of (1-3). Let U C M denote the subset where
(1- |a|2) > ¢4. Then

(1= o) + r Y Va + VD) |xvem—u < k(e Vrdstedl)/e =1y

Proof of Lemma 3.6 Let w = 1 — |«|?. This, the first step of the proof, finds r and
(A4, ) independent constants ¢, c;,c3 > 0 and &4 € (0, 1) and k4 € (0, %) such that

(3-25) g=w+cir Ve + | VA2 —c3r™!
obeys the equation
(3-26) dYdg + kerg <0

on the subset in M where w = 1 —|a|? < &4. This is done by differentiating [12, (6.1)]
s0 as to get an equation of the form VIV (V) +--- =0, where the three dots indicate
terms with either one or no derivatives of yr. Take the inner product of the resulting
equation first with (Ve, 0) and then with (0, V). What with [12, (6.5)], arguments
that differ only cosmetically from those used in [10, Section 2e] find constants that
guarantee (3-26).

With (3-26) understood, the next step constructs a certain positive function that satisfies
the analog of (3-26) with the reversed inequality. To this end, fix a smooth function
x: [0,00) — [0, 1] that is non-increasing, equals 1 on [0, %], and is equal to zero
on [%, 00). A constant ¢ € (r~'/4,1) is needed next; it is fixed shortly so as to be
independent of r and (A4, ¥). For now, fix any ¢ € (r /4, 1) and let x, denote the
function

(3-27) Xx() = )((crl/2 dist(-, x)).

The assignment of a given pair (x, ) to xx(») defines a smooth function on M x M
when r > ¢o. Such a lower bound for r is assumed in what follows. With x
understood, set vy to be the integral of x and define p € C*°(M) by

(3-28) o) = v [ ) disC. V)
M

Note that |dp| < ¢ since the distance function is Lipshitz with norm 1. Note also that
|Vdp| < corl/?.

—crl/2

Now set z = ¢ P The function z obeys

(3-29) d¥dz + coc?rz > 0.
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This understood, let x« be as in (3-16) and set ¢ = (CO_IK*)I/ 2 50 that the inequality
in (3-29) reads d Tdz + kyrz > 0. This understood, use Lemma 1.7 to obtain an r and
(A4, ) independent constant, k1, that bounds g everywhere on M . Then

(3-30) dTd(g—K12) + ksr(g —k12) <0

on M —U and g <0 on dU . The maximum principle asserts that g <x;z on M—U.
This implies what is stated by the lemma. |

3.4 Estimates for adapted coordinate chart maps

The purpose of this step is to define a set Wy C Ag for an adapted coordinate chart
map ¢. The following lemma supplies some input to the definition. The constant e
that appears in the lemma comes from Lemma 3.6.

Lemma 3.7 There exist constants k > 1,81 € (0,8) and &1 € (0, &4«) with the following
significance: Suppose that r > k, 1 €  has C3 norm bounded by 1 and (A, ) is a
solution to the r and p version of (1-3). Let ¢: C x[—8,8] — M denote an adapted
coordinate chart map. Fix R € [100r~1/2§,]. Then fix a minimal set of disks in C
with the following two properties. First, each disk in this set has center in A g and
radius r~/2. Second, (1 — |a|?) > &; on V x {0} when V is a disk from the set.
Denote this set by A.

o If(u,z) € AR x[—R,R] and (1 —||?) > &4, then u € Upep V.

* Let Ny denote the number of elements in A. Then
Ny <k(R7'Eg + R?)

where E4 denotes the integral of r|1 — |a|?| over AR x[-R, R].

Proof of Lemma 3.7 The assertion in the first bullet follows using the uniform
bound on |V’B| in Lemma 1.7 because the Dirac equation sets V,a equal to a linear
combination of derivatives of 8. To establish the assertion in the second bullet, note
that each V' € © contains at least one point x such that (1 —||?) > &; at (0, x).
Given the uniform bound on |V «/|, this implies that there exists &, € (0,§) that is
independent of 7, (A, ), the map ¢ and x; and is such that (1 — |a|?) > %81 at any
(z, x) with |z| < §,. It then follows using Lemma 1.7, now for its stated bound on
|Va|, that

(3-31) r / (1—[a?) = ey Rey — co R,
Vx[—R,R]
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for each V' C ®. Here, ¢y > 0 and ¢o > 1 are independent of r, (A4, 1), R and the
map ¢. Since © is a minimal set of disks, there exists some ¢, > 0 that is independent
of r, (4,v), R, and the map ¢ such that at most ¢, disjoint disks from ® contain
any given point in C. This being the case, it follows from (3-31) and Lemma 1.6 that

(3-32) Ep =T / 11— la|?| = c5'cre1 RNy —co R,
ARX[—R,R]

This last bound implies the assertion made in the second bullet of the lemma.

Let x denote the constant that appears in Lemma 3.6, and set

(3-33) ps = kr 2 (In(1 + r/(1 + |E|)) + In(4k)).

Fix an adapted, coordinate chart map ¢ and a set A as described in Lemma 3.7. For
each V e A, let WY C C denote the disk with the same center as V with radius 4.
Let WY~ denote the disk with the same center as V with radius py. Granted this
notation, set W = Wy = UyeAWV and W~ = UVGAWV_. a

Lemma 3.8 There exists k > 1 that is independent of r, (A,¥), R and ¢, and has
the following significance: Define W as above. Then

11+ E|
<
T 2|E|+r
on (AR —W7™)x[—R, R]. In addition, W is contained in a set of disks in C of radius
r~1/2 that has Nwg = K(R_1E¢ + R?)(In(1 +r/(1 + |E|)))?> members.

(1—la)?) and |Va| <k(l+ [E|)

Proof of Lemma 3.8 The first assertion follows from Lemma 3.6. The second follows
using the second bullet in Lemma 3.7 given that W is the union of Ny disks, each of
radius px. |

The next task for this subsection is to specify a cover for Ag — W by disks with
relatively large radii. A cover of the required sort is supplied by the next lemma.

Lemma 3.9 There exists k > 1 that is independent of r, (A,¥), R and ¢, and has
the following significance: Define W as above. Then there is a cover of Ag — W by
a set of disks in C with the following properties: First, each disk from the cover is
disjoint from W~ and each disk has radius at least p1/2, Second, the number of disks
in the cover is bounded by K(R_lEdJ + R?)In(1 4 r/(1 + |E|)). Third, the ratio of the
respective radii of any two intersecting disks is bounded by k. Finally, no more than k
distinct disks from the cover contain any given point.
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Proof of Lemma 3.9 The set in question is the union of sets Ky,..., Kz with a
bound for Z given shortly. The set K is defined as follows: Let vy = 0 and for
positive integer n, set v, = 2(%)” — 1. Let L, denote the set of points in C whose
distance from W is equal to v, = p«. Then K, is a maximal set of disks in C with
the following properties: First, each disk has radius (1 + %Un)p* and center on L.
Second, the center of any given disk from K, has distance at least %(1 + %vn),o*
from the center of any other disk from K,,. The number of elements in K, is less
than 167 Ny with Ny as in Lemma 3.7. This is because the length of L, is at most
27(2 + un) px Ng . A straightforward induction argument proves that the union of the
disks from the set Ko U---U K}, contains the set of points in C with distance v, 410«
or less from W . This construction guarantees that the number Z can be no greater
than (In %)_1 In(1 + 8R/px«). The existence of a uniform bound on the number of
disks that contain any given point uses two observations: First, no point in a disk from
any n > 2 version of K, has distance less than (%Un — 1)p« from W. This implies
that disks in K, and K,,_j are disjoint when k > 5. Second, the center of any given
disk in K has distance at least %(1 + %Un) p« from the center of any other disk in K.
Granted these facts, apply the n — k version of this last observation for k € {0,...,5}
with the fact that (1 + %U,,_k) > (%)k 1+ %Un) to obtain the desired bound. O

3.5 The definition of ©4

Let ¢: C x[—§, 8] denote an adapted coordinate chart map. In order to define the set
O, introduce the subsets W and W™ as defined in Section 3.4.

Now, fix ¢ € (0, 1) for the moment. Its precise value is determined shortly. With ¢
fixed, the following lemma is used to specify the additional points.

Lemma 3.10 There exists k > 1 which is independent of r, i, (4,v¥), R and ¢ and
has the following significance: Fix o € (0, 1), and there exists a set of disks in C with
the following properties.

e The disks in this set cover Ag.

e The set has at most coo_z(R_1E¢ + R?*)(In(1 +r/(1 + |E|)))? elements.

e No more than « of the disks from this set contain any given point in C .

e Let A denote any disk from this set. The radius of A can be written as op where
pE [%r‘l/z, %R]. Moreover, r(1 —|a|?) < p~2 on the radius p ball with center
at the center point of A.

Proof of Lemma 3.10 This lemma follows directly from Lemma 3.8 and Lemma 3.9.
Indeed, it follows from Lemma 3.8 that W has an open cover by a set of disks in C
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that has at most ¢oo~2(R™'Eg + R?)(In(1 +r/(1+|E|)))* members, and is such that
each disk in the set has radius %ar_l/ 2. Moreover, the last two points in the lemma
are also obeyed by the disks in this set. Indeed, the final point follows because Lemma
1.6 guarantees that r(1 — |a|?) < 4r. The remaining disks in the set cover Ag — W
and are chosen using Lemma 3.10. In this case, Lemma 3.9 implies that each disk
obeys the fourth point of Lemma 3.10.

Let Q4 denote the set of disks that are supplied by Lemma 3.10. The points in O
are the centers of all disks of the form A x {0} where A € Q. ]

3.6 The specification of o and v

The constant o enters above in the definition of each ®¢’ and the constant v enters
as R = max(v(1 + |E[)~1/2,100r~1/2) in the case where r > 26~'. Lemma 3.3 and
Lemma 3.5 are the key inputs that determine o and v. As explained next there are
values for v and o that are independent of r, v and (4, ¥) such that any j € U
that vanishes at all points in ® must be zero. To see that such is the case, suppose
that v and o have been chosen and that j is an element in 9z with L2 norm 1 that
vanishes at all points in ®. Fix ¢ € ®. By virtue of Lemma 3.10 that each disk in Q
can be written as Ay, where p € [%r‘l/ 2, %R] and where the concentric disk, A,, of
radius p satisfies the conditions in Lemma 3.5. Since the number of disks from Q¢
that contain any given point of Ag is a priori bounded, it follows from Lemma 3.5
that

(3-34) / 12 <co / (0 2RV, j|? + olj? + oR*|al?).
ArX[-4R.%R] ARX[=R.R]

By virtue of Lemma 3.2, this then implies that

(3-35) 1=/|j|2Scoo_zRZ/|ij|2+coo+coaR4/|q|2.
M M M

Now, according to Lemma 3.3, the L2 norm of V,j is bounded by co(1 + |E[)!/2,

and that of q is bounded by (1 + |E|). Thus, with R = v(1 + |E|)~!/2, the inequality
in (3-35) implies that

(3-36) 1 <co(02v? + 0 +ov?).

3/2

This understood, choose o = %(1 +¢)~! and choose v = %(1 4 ¢o)”°/“ to obtain

from (3-36) the absurd conclusion that 1 < %. Thus, no such j € ¥ g exists for these
choices.
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4 Overtwisting

This section supplies a proof of Theorem 1.4. The proof relies on a relative version of
Corollary C from Mrowka and Rollin [9]. The suggestion to use this corollary in the
proof came from Tom Mrowka. As the reader will see, the proof also owes much to
the work of Kronheimer and Mrowka in [6].

4.1 The proof of Theorem 1.4

To set the stage, choose the Spin¢ structure on M where S = Ic & K 1 Let ry
and § be as described in Proposition 2.8. Fix p €  with C3 norm less than 1 as in
Proposition 2.1. As noted in Proposition 2.8, for each r > ry, there exists a unique
gauge equivalence class of pairs (A, 1) that solves the r and p version of (1-3)
and is such that || > 1 —4. Use ¢;(r) in what follows to denote both the solution
given by Proposition 2.8 to (1-3) and its corresponding gauge equivalence class. If
follows from [12, Lemma 5.4] that r; can be chosen so that the solution ¢y (r) has has
Seiberg—Witten degree zero for all r.

Now let {p;} C [1,00) be as in Proposition 2.1, and for r € (1, 00) — {p;}, use the
gauge equivalence classes of solutions to (1-3) to define the generators for the Seiberg—
Witten Floer homology. Define the Seiberg—Witten Floer homology for such r in the
manner that is described in Section 2, Proposition 2.3 and Definition 2.4. Use H°(r)
to denote the degree zero Seiberg—Witten Floer cohomology. By definition, H°(r) is
a Z-module whose elements are certain equivalence classes of linear functionals on
the vector space of degree zero cycles for the Seiberg—Witten Floer homology. The
equivalence relation identifies linear functionals t and t' when t' = t+ v(§(-)) where v
is a linear function on the vector space of degree —1 cycles. The module H° consists
of those equivalence classes of linear functionals that give zero to boundaries. Such a
cocycle is said to be closed.

The constructions of Kronheimer and Mrowka in [6] can be modified using analysis
from [7, Chapter 24] to assign a reasonably canonical element to H°(r). What follows
outlines how this is done. To start, it is necessary to specify some auxiliary data. Here
is the data.

e A smooth, non-decreasing function 7: R — [0, co) that has value 0 where s < 1
and equals s where s > 2.

e A smooth and suitably generic section, fi, of T%M over R x M with compact
support where 2 < s < 4 and small C® norm. An upper bound for this norm is
specified below, but require in any case that the norm is less than 1.
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e A smooth, non-increasing function x: R — [0, 1] that equals 1 where s <0 and
equals O where s > 1.

e The pair (Ay, Y1) € Conn(Ic) x C°°(M;S) that solves (2-2) and also has
E(A4) =0.

Of interest in what follows are the smooth maps s — 0(s) = (A(s), ¥ (s)) from R to
Conn(Ic) x C°°(M ;S) that obey

0
s A=—By+rT @Y —ia) tix(edp+wg) +ifh.
N
d
a_w = _Dva
N
_1)im 0(s) exists and defines a non-degenerate degree zero solution to (1-3),
§—>—00

@1 lim 3(s) = (A1, Y1)

With regards to the nature of the limits in (4-1), it is sufficient to assume that these
limits are defined with respect to the C*° topology in Conn(/¢) x C*°(Sy). Even so,
the same moduli space arises if the limits are in C 0 or, for that matter, L%.

As remarked on briefly below, arguments from [6, Sections 2 and 3] for their Theorem
2.4 and the analysis given in [7, Chapter 24] can be used to prove that there are only
finitely many gauge equivalence classes of solutions to (4-1) for a suitably generic
choice for ji. Moreover, each such equivalence classes has an associate sign, either
+1 or —1. Granted that such is the case, let ¢ denote a solution to (1-3) with degree
zero; and let o (c) denote the sum of the signs that are associated to the solutions to
(4-1) with s — —oo limit equal to u - ¢ with u € C®(M; S'). Set o(c) = 0 if there
are no gauge equivalence classes of solutions to (4-1) with s — —oo limit in ¢’s gauge
equivalence class. The assignment of the integer o(c) to ¢ associates an integer to
each generator of the Seiberg—Witten Floer complex with Z/pZ degree 0. Use t, in
what follows to denote the degree zero Seiberg—Witten Floer cocycle whose value on a
generator ¢ is o (c).

The following is a generalization of [6, Theorem 2.4].

Theorem 4.1 Let i be as described in Proposition 2.1, and suppose that r € {p;}.
Then the cocycle t, is closed, and so defines an element in H°(r).

The next result constitutes the fundamental input from [9].

Theorem 4.2 The cocycle t, defines the trivial class in H°(r) when the kernel of a
is overtwisted.
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Proof of Theorem 4.1 and Theorem 4.2

Consider first what is said leading up to Theorem 4.1. Kronheimer and Mrowka in
[6, Section 3] introduce the notion of an ‘asymptotically flat almost Kahler’ structure.
The equations in (4-1) are the Seiberg—Witten equations on the 4-manifold R x M
where the geometry is such that the s — oo end has such a structure. To elaborate, let
m denote the Riemannian metric on M . Then the asymptotically flat almost Kahler
structure is defined using the metric e27 (ds?4m) on R x M . The required symplectic
form on the s > 1 part of R x M is w = €27 (ds Aa + *a). Here, * is the Hodge star
on M that is defined by the metric m. Meanwhile, the end where s — —oo has the
sort of cylindrical end structure that is considered in [7, Chapter 24].

The techniques used in [6] can be applied to analyze the behavior of solutions to (4-1)
on the s — 0o end of R x M, and those from [7, Chapter 24] can be used to analyze
the behavior of the solutions on the s — —oo end. This limit business is discussed in
Section 4.2 and it follows from Lemma 4.6 that the solutions to (4-1) have the same
large s behavior as do elements in the moduli spaces that are defined in [6]. Meanwhile,
the s — —oo limit is analyzed for one particular case in Section 4.2. In particular,
Lemma 4b asserts for this one case that the relevant solutions to (4-1) have the same
s — —oo behavior as do elements in the moduli spaces that [7] define in their Chapter
24. The story for other cases is much the same. Given that the limiting behavior is
such as to put the solution in the appropriate moduli spaces, then a straightforward
application of the techniques from [6] and [7] prove that the set of gauge equivalence
classes to (4-1) comprise a finite set when i is chosen in a suitably generic fashion, and
that each such class has an associated £1 assignment. Theorem 4.1 likewise follows
in a direct fashion from what is said in these parts of [7] and [6]. The fact is that the
discussion in [7, Chapter 24] is written so as to readily accommodate the case where
the 4-manifold has both cylindrical and asymptotically flat almost Kahler ends.

To put all of this in a larger context, view [0, c0) x M as a manifold with boundary, and
Theorem 4.1 provides only another example of what is observed by Donaldson [2] in
the context of SU(2) gauge theory: A construction that gives a numerical gauge theory
invariant to a 4—manifold with no boundary generalizes to a manifold with boundary
S0 as to give an invariant in the boundary’s Floer homology or cohomology.

As noted, Theorem 4.2 is the analog in this context of the vanishing result given by
Corollary C of [9]. The proof amounts to adapting the proof given by Mrowka and
Rollin [9] for their Corollary C to the context of R x M with its asymptotically
flat almost Kahler s — oo end and its cylindrical s — —oo end. This adaptation is
straightforward using the analysis in [7, Chapter 24] to control behavior on the s — —o0
end.
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The proof of Theorem 1.4 exploits the dichotomy between what is said in Theorem 4.2
and what is said in the next proposition. a

Proposition 4.3 There exists r;y > ry and go > 0 such that when r > rps and ||i]| cs <
&9, then there is precisely one solution to (4-1), and its s — —oc limit defines the class

C[(r).

This proposition is proved in Section 4.2 and Section 4.3 modulo a proposition whose
proof occupies Section 5.

Theorem 4.2 says that there is a cocycle, v, on the degree —1 Seiberg—Witten Floer
complex such that #,(3) = v(§3). Meanwhile, Proposition 4.3 guarantees that t, (c1(r))
is never zero. Thus, Proposition 4.3 and Theorem 4.2 demand that that §(c; (1) + 1) # 0
when the generator ¢y (r) is absent from the cycle . This understood, let B(r) now
denote the set of degree —1 Seiberg—Witten Floer cycles of the form §(cq () + to) such
that ¢z (r) does not appear in to with non-zero weight. For each n € B(r), use a/ (n, r)
to denote the maximum of a/ on the generators that appear in n with non-zero weight.
Now set a/ 7 (r) to denote the infimum of the set {a/ (n, ") }neB(r) - Define as before
E(r), §(r) and v(r) using B(r).

The analog here of Proposition 2.10 holds. It is crucial here that §(c7 (r) +10) # 0 when
o lacks the generator ¢y. Otherwise, the sudden appearance of a canceling pair, ¢ and
¢, with §¢ = ¢’ and degree(c) = 0 can make a”; discontinuous. As in the cases studied
previously, there is a sequence {ry, (4,, ¥,)} with {r,} increasing and unbounded,
with (A, ¥y) satistfying the » = r, and u version of (1-3), with degree —1, and
satisfying one or the other of the options in (2-3). As before, the second option is ruled
out by [12, Proposition 5.1]. Thus, {E(A4,)} is bounded. Since each (A4, ¥,) has
degree —1, [12, Lemma 5.4] gives some positive § such that supy (1 —|¥,|) > § for
all sufficiently large n. This being the case, the sequence {(7y, (A,, V¥,)} meets all of
the conditions for Theorem 1.5. Theorem 1.5 provides the set of closed integral curves
of v for Theorem 1.4.

4.2 Proof of Proposition 4.3: Existence

This part of the proof establishes the existence of at least one solution to (4-1), this with
s — —oo limit equal to u - ¢7(r) with u a smooth map from M to S!. As the reader
will see, the arguments given in what follows are analogs for R x M of arguments
from Section 2.4 that prove Proposition 2.8.

To start the existence proof, introduce as before (A, ¥y). Here Ay is a trivial connec-
tionon Ic and v is Ay covariantly constant. Moreover, D4, ¥ =0 and l/f;ﬂﬂl =ia.
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Thus, the constant map s — 07(s) = (Ay, ¥y) satisfies the version of (4-1) where
the right hand side has p and [ equal to zero and i wg absent. A solution to (4-1)
is obtained from a section over R x M of the bundle i7*M &S @& iR over R x M .
To say more, introduce by = (bg, 19, 0) to denote the fixed point to (2-5) with norm
6ol < cor~1/2. The desired triple (¢,c,¢) € CP(R x M:iTxM &S @ iR) must
have limit zero as s — +o00 and solve

(4-2)
0
8_C +t'c+*xdc—dg —2_1/2r1/2eT(w1Ttg + gTﬁ/fI) l/zeTgTrg x'b
N
_ir—1/zﬁ_2—1/zr1/zeT

2 x(oTtc +ctene) —r'2x(1 = )motene =0,

0

-G+ Dayg +212r 12l (cleyp + gyn) +212r1 26T (cl(o)s + )
S

—x'no + 22112 x(cl(c)no + cl(bo)n + ¢pno) + 22112 x(1 = x)el(bo)no = 0,

0 _
a—¢+>|<d>x<c—2 /zrl/zeT(CTlﬂI—WﬁC) =0.
N

In this last equation and in what follows, d denotes the exterior derivative along the
M factorin R x M . Also, T’ and x’ denote the respective derivatives of 7 and .
Here is one further constraint on (c, g, ¢): Let

N
(4-3) O(S,-):21/2r1/2/ T, )d.
0

The function o must have a limit as s — F0o as a smooth function on M . Granted
that such is the case, let o0+ denote the s — oo limit of o. Then the pair (A4, V)
with the connection 4 = Aj + 27/2r1/2¢t(xby + ¢) — d(0 — 04) and the spinor
Y = e %+ (Y1 + xno + ¢)) solves (4-1) and has the required limits as s — $o0.
This understood, the plan for what follows is to find a triple (c, ¢, ¢) that obeys (4-2)
and whose version of o has the desired properties.

To find (c, g, ¢), introduce the Hilbert space completion of the space of compactly
supported elements in C°(R x M;iT«M & S @ iR) using the norm whose square
gives the function

1
@4 b [l /"/( Do 4 vrb 4 2T|b|2)

This Hilbert space is denoted by X in what follows. A solution to (4-2) is found in X
using a contraction mapping argument much like that used to prove Proposition 2.8.
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To set the stage for this contraction mapping business, introduce L. to denote the
completion of the space of compactly supported elements in C®°(R x M ;i TxM &
S @ iR) using the norm whose square is defined by

4-5) IhlL? = / A7 / 1912,
R M

Next, introduce the operator D: X — L. that sends h = (c, G, ¢) to the element with
respective i T M, S and iR components

0
St t'c +xdc—dp —2"Y2 12T (yrTrc + cTryy),

N

0
(4-6) 5-6+ Days + 21212 (el (e)yr + o),

N

0

PR sd xc =272 1 26T (¢ Ty —y o).
N

Note that D can be written as D = % + L+ T HT*M , Where the notation uses £

to denote the version of (3-1) that has (4, ¥') = (A, ¥y) and r replaced by re2T®).

Meanwhile, [ [z, denotes the fiberwise projection from the bundle i 7%M & S @ iR

to iT+«M .

Lemma 4.4 There exists ry > 1 such that for r > ry, the operator D is Fredholm
with index zero. Moreover, |Db|L > |Iblix-

Proof of Lemma 4.4 The proof follows from [12, (5.23)] with some integration by
parts. m]

Lemma 4.4 guarantees that D is invertible when r > ry.

One more lemma is required for the set up, this the following weighted version of a
dimension 4 Sobolev inequality. Its proof is straightforward and so omitted.

Lemma 4.5 Suppose that r > 1. Let (h,h’) — b b’ denote a given homomorphism
from the bundle ®, (i T«*M ®SBiR)|ps to (i TxM &S DiR)|ps. The homomorphism
(h.5") — e’ over R x M induces a smooth, bilinear map from X @ X to I whose
norm obeys |eTh xb')[|L < collbllx>.

Granted these last two lemmas, it follows that what is written in (4-2) defines a smooth
map from X to .. Write this map as h — Db+r1/ZeTh*b+2r1/2xbo *h—r‘l//zvx,
and it then follows that the solutions to (4-2) in X constitute the fixed point set of the
self map

(4-7) h— Tx() =D ' 2ux —r'2xho s h—r'/2eTh x ).
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To see that Tx has a fixed point for large r, reintroduce the norm ||- || that is defined
by (2-6). By design, the fixed point hy = (b, 10, 0) to (2-5) obeys ||hollm < cor /2.
It then follows from (2-8) that the L* norm on M of b, is bounded by cor /8.
Meanwhile, that of b on any given slice {s}x M C Rx M is bounded by /|||, |m.
As a consequence, vx and hg * h obey

(4-8) lvxllz < co(lZllL +r~"/*) and || xho * bl < cor>/*|Ib]Ix

when r is large. It then follows from Lemma 4.4 and Lemma 4.5 that

(4-9) ITx(®)lx < oG 2Nl +r~ Y40l + 2 1eTh*p|L).

As a consequence, the map Tx on the ball in X of radius R = 4co ™' ||fi[|lr—!/2
obeys

@10) 1T 0)lx = 3 /2 R(1+4co( ™4+ R).

This understood, there exists rg > 1,9 > 0 and Ry > 0 such that Tx maps the ball of
radius Ror /2 to itself when r > ro and when ||i||1, < &o. A very similar calculation
proves that the constants 7y and gy can be chosen so that 7 maps this ball to itself
as a contraction mapping when r > ro and |||l < &o. The contraction mapping
theorem finds a unique fixed point of 7x in the ball of radius Ror~1/2 for such r and
jt. Very much standard elliptic regularity arguments using the equation in (4-2) prove
that this fixed point is a smooth section of i 7%M @& S @ iR over R x M . Note for
later reference that the elliptic regularity assertions are of the following sort.

There exists an r—independent constant p > 0 and, given r > 1 and
integers k, n > 0, there exists ¢, ,, with the following significance:
Let B C R x M denote a ball of radius p and let B’ C B denote the
concentric ball of radius % o as defined with the product metric. Let A
denote a solution to (4-2) on B. Then

n

d" okl < w+io1(p) [ 27 (]9
SR S e (|5

N

(4-11) sup

xX€eB’

b

2
VbR + |h|2).

As is explained shortly, the existence of the desired s — o0 limits of (4-3)’s function
o follows from the next lemma.

Lemma 4.6 There exists k > 0 and g9 > 0, and given ¢ € (0, gy), there exists rs > 1,
and these have the following significance: Suppose that r > r, and so > 2 Let h =
(c, ¢, ¢) denote a smooth solution to (4-2) on either the half cylinder (—oco, —so] X M,
or on the half cylinder [sq, 00) X M . Suppose in addition that |h| < &. Then
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o limg—_ooexp(xr1/2|s|)|h| is finite in the case when} is defined on (—oco, —sg] x
M,

o limy_s o0 exp(kr!/2e%)|p] is finite in the case when b is defined on [sg, 00) X M .

What with (4-11) and this exponential decay, it follows that derivatives of h to any
given order decay at an exponential rate as s — —oo with rate constant proportional
to /2 and it decays as s — oo as exp(—/(rl/zes). For example, such is the case for
the solution found in the previous subsection. Thus, the function o that is defined in
(4-3) limits as s — +o00 in the C* topology to a smooth function on M . In the case
when b is the solution to (4-2) found in the previous subsection, the second item of the
lemma plus (4-11) proves that the function o in (4-3) also has a limit as s — oo in the
C*®° topology on the space of smooth functions on M .

Proof of Lemma 4.6 To prove the first item, let £ denote the version of (1-7) that
is defined by (47 + 21/2p1/2p Y1 + no). It is a consequence of [12, Lemma 5.4]
that £ has no zero eigenvalue on L2(M;iT+M @S & iR). Indeed it follows from
this lemma that ||.£b]|, > (1 —cor~3/2)||b||p for any b € H. Thus, all eigenvalues of
£ have absolute value greater than %rl/ 2 when r is large. Let IT4 denote the L2
orthogonal projection on M onto the span of those eigenvectors of £ that have positive

eigenvalue. Let [T = (1 —I14). Let h(s) = || TT+LH[s]2.

Fix & > 0 and suppose that 5o > 0 and that b is a solution to (4-2) such that |h| < e
where s < —sg. It then follows as a consequence of (4-2) that the functions fh+ on
(=00, —s0) obey

d

(4-12) Soht g 1/2h+ <coe'/?(hy +h_) and
S
d 1
Joh— 4r1/2h_ > —coer /2 (hy + h_).

Taking linear combinations of these two equations results in the following conclusion:
There exist »—independent constants ¢; > 0 and ¢, such that if & < ¢y, then Ay =
hy —creh— obeys

d

(4-13) _h*+ r 12, <.
ds

Integrating this last equation finds that
(4-14) hy(s) > e’l/z(s/_s)/gh*(s') for any s < s’ < 5.

Since A+ (s) — have bounded absolute value as s — —o0, this last equation requires
that /1 (s) <0 for all s <s4. This says that A < cyeh_ for s <s.. Granted the latter,
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it follows from the right most equation in (4-14) that there exists ¢j > 0 such that when
/
e <cy’,then

d 1
(4-15) “h_——r~Y2p_ >0 where s < sp.

ds 8
Integrating (4-15) finds that 4_(s) < e’l/z(s_sl)/gh_(s/) when s < s’. Thus, h_(s)
limits to zero at an exponential rate as s — —oo, and since i1 < cpeh_, this is true
for i also.

Consider next the story for the second item. Thus, assume now that § is a solution to
(4-2) on [sg, 00) x M with |h| < e. To study this case, let £; denote the operator that
is defined by the version of (1-7) that has re?S replacing r and (A7, ) for the pair
of connection and section of S. In addition, take T and & equal to zero. Let T4+
and IT,— denote the respective projections to the span of the eigenvectors of £, with
positive and negative eigenvalues. O

Lemma 4.7 The operators TIg+ on L>(M;iT*M @& S @ R) vary in a real analytic
fashion as a function of s ; and the norm of %H s+ has an r and s independent bound.

This lemma is proved shortly.

With Lemma 4.7 in hand, let 24 (s) = || I1;4b|s||2. These functions are defined on the
half line [sg, c0) where they obey the following analogs of (4-13):

d 1
%hjL + Zrl/zesth < co(er'?¢’ + 1)(h4 + h_) and

d 1
—ho— Zrl/zesh_ > —co(er'?e’ + 1) (hy + h_).

Note that the extra factor of co(h+ + h—) that appears on the right hand side of
each inequality comes from s—derivatives of Il;+ courtesy of Lemma 4.7. With the
preceding understood, change variables from s to ¢ = ¢%. Doing so makes (4-16) look
like a version of (4-12) when r!/2es > 1 /&. This understood, the arguments that are
used for (4-12) can be used here with the roles of .4+ and /s_ reversed to prove the
second item of the lemma.

(4-16)

Proof of Lemma 4.7 The fact that [154 varies in a real analytic fashion follows from
the results in Kato [5, Chapter 7] given that the arguments in [12, Section 5e] prove
that £, has no eigenvalues with absolute value less than %r 1/2¢5 The bound on the
norm of the derivative follows by writing T4 as a contour integral using its resolvent:

1 1
4-17 My = —
( ) St 2ni cz—4Ls

dz
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where the contour C C C is the path that starts at (co,ir!/2e®) and moves with
constant imaginary part to (0,ir!/2¢%), then crosses the real axis to (0, —i r'/2¢%) and
then moves with constant imaginary part to (oo, —i r'/2¢%). The derivative of ITsy is
thus given by the contour integral

d 1 1 d 1
4-18 — Iy = —£ dz.
( ) ds 7t 2ni/¢~2—£sds Y- g :

Now, the derivative of £y is an endomorphism of i M @& S & iR with norm bounded
by cor'/2e*. Meanwhile, the operator norm of (z — £,)~! at a point (x, +ir!/2¢%)
on the contour is bounded by (x + 7 1/2¢5)=1/2 Thus, the integral along the horizontal
parts of the contour in (4-18) define an operator with norm bounded by

foe) rl/zes
4-19) Co/
0

(x + rl/zes)zdx’

which has an 7 and s independent bound. The operator norm of (z — £5)~! along
the vertical part of the contour in (4-18) is bounded by cor~'/2¢™ since there are no
eigenvalues of £; whose eigenvalue has absolute value less than %r 17265 Given this
bound, it then follows that the vertical part of the contour integral in (4-18) defines an
operator whose norm has an r and s independent upper bound.

The r—independence of the sign that is associated to this solution follows from with a
proof that the linearization of (4-2) at the solution § has just trivial kernel and cokernel
when r is large. The latter fact follows from the contraction mapping construction of
bh. Indeed, an element in the kernel of the linearization of (4-2) at h is in the kernel of
the differential of the map 7x at b, and this differential has trivial kernel because 7Tx
is a contraction at b. m|

4.3 Proof of Proposition 4.3: Uniqueness
The uniqueness assertion in Proposition 4.3 is proved with the help of the following.

Proposition 4.8 Given ¢ > 0, there exists r, > 1 with the following significance:
Suppose that r > r, and that s — 0(s) = (A, ¥ = («, B)) is a solution to (4-1). Then
d

(1= la /24 11+ 72| 5

ds

+r_1(‘8i—22a‘+

oc‘ + |Va|)
(4-20)

d ad

—Voz‘ + ‘V—a‘ +|V2a| ) <,
Js Js

at all points in R x M .
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A proof of this proposition is given shortly, so assume it to be true so as to complete
the proof of Proposition 4.3.

The proof of the uniqueness assertion in Proposition 4.3 uses Proposition 4.8 to obtain
a solution to (4-2) from a solution to (4-1). This first step in the proof invokes some
conclusions from the next lemma. To set the stage for this lemma, suppose that I C R
is either all of R, or (—o0, 51], or [s1, 00), with 57 € R.

Lemma 4.9 There exists k > 4, and given ¢ € (0, k"), there exists r, > 1 with the
following significance: Suppose that r > r, and that s — 0(s) = (4, {) satisfies the
first two equations in (4-1) on I x M . Also assume that (4-20) holds on I x M . Then
there exist the following.

e Asubset I' C I thatis equal to R when I = R and is a half-line otherwise,

e Asolution, h=(c,c, ) € C®(I'x M ;i Tx*M ®&S®iR) to(4-2) on I’x M with
|h| < ke and such that the pairs (A +2/2r1/2eT (xbo+c—¢ds), Y1+ xn0+<)
and (A, ) of connection on the trivial bundle over I’ x M and section over
I’ x M of Sy are gauge equivalent.

Proof of Lemma 4.9 Since o # 0 on I x M , there exists a map #i: [ x M — S
with the property that #ia = |a|Ic . It then follows that A — i~ 'di — (™! a%z?)ds =
Aj+ad+agds, where a is the imaginary part of the C —valued 1-form o~ 'V and @ is
the imaginary part of the C —valued function o™ Lo, Write a =21/271/2 el (xbo+b),
write ¥ = ¥ + xno + 17, and write do = 2'/2r l/zeTo Then the triple b = (b, n, 0)
obeys |b| < coe. In addition, the top two equations in (4-2) are obeyed with b replacing
h. To obtain h as described by the lemma, consider an additional gauge transformation
of the form e* where x: I x M — iR. Write u = ¢*# and use u and (4, V) to
define the triple h = (c, g, ¢) as in the lemma. Thus,

c=b— 2_1/2r_1/2e_de,

(4-21) ¢ =(e* =1 + xno) + ey and
6= 21212, T2
S
Note that the top two equations in (4-2) are still obeyed by h. The bottom equation in
(4-2) is obeyed if x obeys an equation with the form
2

0 d d
(4-22) —as—zx + T/a—x +dxdx+2re?Tx + 8—0 +d=xb+ reZTp(x) =0
s s

where g(-) at each point in / x M is a smooth function on (—cg, ¢g) C R with the
property that | (¢)| <co(¢>+|n|) and |(%8o)(t)| <cot atany given pointin I x M . The
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desired bound |h| < «e¢ is obeyed if x solves (4-22) and |x|—|—r_1/ze_T(|§x|+|dx|) <
coe. The existence of the desired solution can be derived using 4—dimensional analogs
of the arguments that proved Lemma 2.11. There is nothing tricky about this, and so
the details are left to the reader.

Given Proposition 4.8, use Lemma 4.9 to deduce the following: Given ¢ > 0, there
exists g > 0 such that any solution to an r > r, version of (4-1) supplies a solution,
b, to (4-2) with |h| < e. Use Lemma 4.6 to deduce that § is in the Hilbert space X.
Granted that b is in X, if it has small norm, it will have to be the solution to (4-2)
from Section 4.2. Thus, it is a fixed point of the map Tx that is depicted in (4-7). This
being the case, (4-9) implies that

(4-23) Ibllx < colr™" 2Rl + =40l +r'/2lleTh * bIL).

Since |h| < ¢, this last inequality implies that

(4-24) Il < 2¢0G ™ 2112l + 7'/ ?elle bl

when r > ¢o. Meanwhile, it follows from (4-4) and (4-5) that [leT || < 2r=Y2|h|lx
and so (4-24) implies that

(4-25) Ibllx < 2cor™ 2RI + 4coelblx.

Thus, if & < (4co) ™", then h will lie inside the ball in X where T acts as a contraction
mapping. In this event, § is the solution from Section 4.2. |

S The proofs of Proposition 4.8 and Proposition 2.9

The proof of Proposition 4.8 is given first, as many of the estimates and techniques
used in the latter are then applied with only minor modifications to prove Proposition
2.9. The proof of Proposition 2.9 appears in the final subsection.

The proof of Proposition 4.8 invokes a set of a priori bounds for any solution s —
(A(s), ¥ (s)) to (4-1). The first such bound is the analog for R x M of what is stated
in Lemma 1.6.

Lemma 5.1 There exists a constant, k > 1 such that if r > k and if (A, V) is a

solution to (4-1), then
lo| <14krte™?T

1BI2 <kr~te 2T ‘1 — |a|2| +kr2e4T
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The next a priori bound concerns the curvature of the connection A. This proposition
refers to the functional a that is depicted in (1-4).

Proposition 5.2 There exists a constant ks« > 1 with the following significance:
Suppose that r > k4 and that s — 0(s) = (4, V) is a solution to (4-1). Then
|2 A +|Bal <kie?Tr.

The last of the required results asserts a part of Proposition 4.8.

Proposition 5.3 Let (A, V) and k4 be as described in Proposition 5.2. Given § > 0,
there exists rg > k'« such that if r > rg and (A, Y) is a solution to (4-1), then 1 —|a|> <§.

Lemma 5.1 is proved in Section 5.2. The proofs of Proposition 5.2 and Proposition 5.3
occupy the remainder of Section 5. First up is the proof of Proposition 5.2 for points
where s > —2, and then comes the proof of Proposition 5.3 for points where s > —1.
Next is the proof of Proposition 5.2 for points where s < —1; the latter starts in Section
5.7. This is followed by the proof of Proposition 5.3 for points where s < —1.

Note that Proposition 5.3 has the following implication: Let a denote the functional
that is depicted in (1-4). If ¢« > 0 has been fixed, if r is sufficiently large, and
if s = 0(s) = (A4,y) is a solution to (4-1) with limy_,_oo a(d(s)) < cxr2, then
limy_00 9(s) = ¢7(r). Note in this regard that (4-10) implies that a(cz (r)) < cor /2.

5.1 Proof of Proposition 4.8 given Lemma 5.1, Proposition 5.2 and Propo-
sition 5.3

Needed are upper bounds for the derivatives of o up through second order. These
are obtained using a scaling argument of the sort used for the proof of Proposition
4.2 in [10]. To elaborate, the bound is proved by rescaling Gaussian coordinates
centered at a given point p € R x M so that the ball of radius r=1/2=T(P) pag
radius 1 with respect to the Euclidean metric for the new coordinates. When the pair
(A, V) are pulled back to R* by this scaling map, the equations in the first two lines
of (4-1) appear with coefficients that are either independent of r, or are bounded by
cor~ V27T By virtue of Lemma 5.1, the pull-back of ¥ is uniformly bounded.
Meanwhile, Proposition 5.2 guarantees that the curvature of the pull-back of A is also
uniformly bounded, and thus so is A after an appropriate gauge transformation. This
being the case, standard elliptic regularity arguments guarantee the following: Fix
R>1,e>0and k €{0,1,2,...} and there exists (R, &, k) > 1 that is independent
of p, r and (A4, ¥) and has the following significance: If r > r (R, ¢, k), the pull back
of (A, ) via the composition of the Gaussian coordinate chart map and the rescaling
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map has C k distance ¢ or less in the radius R ball centered at the origin in R* to a
pair, (Ao, Yo = (g, 0)), defined on all of R*, and obeying:

5()0{0 =0

log| =1
(5-1) 1
Pt Fy= 5(1 —leto|H)wo

|P_F()| <ec.

Here, R* is written as C2, the connection Ay is a type 1 —1 connection, and 50 is
the d —bar operator that is defined by Ay. Meanwhile, Fj is the curvature 2—form of
Ao, P* are the self-dual and anti-self dual projections for A2T % R* with respect to
the standard metric, and wg = dx' A dx? 4 dx3 A dx*. The constant ¢ that appears
in the final item of (5-1) is twice the constant ky from Proposition 5.2.

Note that (5-1) does not assume the conclusions of Proposition 5.3. When Proposition
5.3 is assumed, then it is also the case that

(5-2) 1 -6 < |ag].

Granted that the pull-back of (4, ¥) by the rescaling map is close to (Ag, Vo), then
Proposition 4.8 follows with a proof that |ag| = 1 and that g is Ag—covariantly
constant when both (5-1) and (5-2) hold. Indeed, these conclusions are valid, then the
covariant derivatives of the rescaled « at the origin are small. This last statement gives
what is required by Proposition 4.8 by rescaling to the original Gaussian coordinates.

Given what was just said, the next lemma supplies what is needed to finish the proof of
Proposition 4.8.

Lemma 5.4 Suppose that § < 1 and (Ag, ) obeys (5-1) and (5-2). Then || = 1
and o is Ag—covariantly constant.

Proof of Lemma 5.4 Note that as «q is nowhere zero, it is gauge equivalent on R*
to a map to C that is everywhere real and positive, thus, e™* for some function u.
Note that # > 0 since |«g| < 1. By virtue of the third equation in (5-1), the function u
obeys

(5-3) Au=1—e2*,

2 . . . . .
where A =) i=1,...,4 ai7 is the Laplacian. By assumption, u is non-negative and

bounded. Note that the maximum principle implies that ¥ > 0 or u is everywhere
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zero. By virtue (5-2), the function u is bounded, and so there exists ¢ > 0 such that
1—e 2 —gu > 0. Thus,

(5-4) Au—ceu > 0.

The only bounded solution to this last equation is # = 0. To see that such is the case,
introduce Gy to denote the Green’s function on R* with pole at x for the operator
—A +¢. Then Gy is positive, and they decay to 0 on R* as fast as exp(—%81/2| -D.
Multiply both sides of (5-4) by G to see that —u(x) > 0. ad

5.2 Proof of Lemma 5.1

The starting point for the analysis is the second order equation for i that is obtained
from the second equation in (4-1):

2
(5-5) —3w+vva—c1(a—A+BA)w+Rw — 0.
s 02

Here, the covariant derivative V differentiates only along directions tangent to M
and it is defined at a given s € R by the connection A|s. In (5-5), R denotes an
endomorphism of S that is independent of r and (4, ) that is uniformly bounded on
RxM.

What with the first equation in (4-1), the equation in (5-5) implies that
2 t 2 2
P +dtdlyl? + ) ‘ +V
56 L E Rt + [ 2y 4 1ww
+rT (Yl + iyt cl@y) + vy =0,

Here, t also denotes an endomorphism of S that is independent of » and (4, V),
and is uniformly bounded on R x M . Set cx = supgyas |t], set z = || and set
x =r"1e™2T Then (5-5) implies that

1 92

(5-7) —532° 5 d’fdz+re2Tz(z—1—c*X) <0.
As o 2x —2T"x +4(T")?x, so (4-19) implies the following: For any o > ¢,,
182( 1—0x)+ ~dtd(z—1-0x) +re?Tz(z — 1 - ox)
—_——— [— f— f— — — r — —
(5-8) 59,2 ox) + z ox et z(z ox

<—re*Tz(o0 —ce)x + (A(T")? =2T")x.

Granted the preceding, suppose that o > 1 4 ¢4 and that r > sup(4(7”)> —2T"). Then
(5-8) precludes a positive, local maximum on R x M for the function (z —1 —ox).
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By virtue of Lemma 1.6 and the third item in (4-1), there exists c¢o such that if ¢ is
also greater than c¢g, then (z — 1 —oXx) is negative as s — —oo. Granted the fourth
item in (4-1), this function also limits to zero as s — 4+00. Because it can not have a
positive local maximum, it follows that z < 1 4+ ox everywhere on R x M . This last
bound gives the first item in Lemma 5.1.

To obtain the second item in Lemma 5.1, project (5-5) onto the respective /¢ and K1
summands in S to obtain second order equations for |«|? and |B|?. These look much
like what is written in [12, (6.4)] (see [10, (2.3) and (2.4)]) as they have the form

192
2052
+ro(@, ) + 1, V') + taferl® =

2
APV B dw|a|2+) a\ +|Val? —re?T (1 — o> = |B1?)|a)?

(5-9)
9 12
L g+ | LB VB 4T (4 a4 BB
+ 0B +v'1(B. Va)) + 2@ B) = 0.

Here, r, and r, have support where s < 2. Introduce w = (1 — |oe|?), and note that
the top equation in (5-9) implies that w obeys the inequality
192

—sopwt dew +re2T
2 9s2

(5-10) 5 2

~(|5gal + 1val 4+ re?T w? 4 BRI ) + ol + 9B 2 0.

Arguing as in the derivation of (5-8), this last equation plus the lower equation in (5-7)

implies the following: There are constants ¢y and c; that are independent of r and

(A, ) and are such that the function u = |8|?> —cor e 2T w —cr~2e™*T obeys
19? 1

(5-11) _58_2u + = deu + —rezT <0.

The argument is essentially that given to prove in [10, Proposition 2.3].

To apply this last equation, fix a smooth, non-negative function, o, on R that is equal
to 1 on [—1, 1] and vanishes where |s| > 2. For R > 1, define og in R x M by the
rule og(s) =0 (R 1s). Let uy: R x M — [0, 00) denote the maximum of « and 0.
Note that the a priori bound on || given previously implies that u4 < 2 if r is large.
Multiply both sides of (5-11) by og and integrate over the support of # . Integration
by parts finds that

1, d? 1 oT
(5-12) _ER ﬁUR Uy + zr ore” uy <0.

RxM RxM
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Now, the integrand of the left most integral in (5-12) is supported where R <|s| <2R,
and its integrand is bounded by 2 supp |j—s220| . As a consequence, the left most integral

in (5-12) is bounded in absolute value by co R~!. Taking R ever larger proves that
14+ must vanish. This then proves the second assertion of the lemma.

5.3 Norm bounds on [—6, c0) x M

The first step to a proof of Proposition 5.2 gives weighted L? bounds on R x M for
(1—|al?), B, and covariant derivatives of o and .

Lemma 5.5 There exists a constant « > 1 with the following significance: Suppose
that r > x and that (A, V) is a solution to (4-1). Then

9 12
/ ezs(‘a—a’ +|Vo¢|2+reZT(1—|a|2)2) <wkr~
s

RxM

[ (|l s+ gremipe) <.

RxM

Proof of Lemma 5.5

The proof given here modifies an argument from [6]. To start, multiply both sides of
the lower equation in (5-9) by e2* and integrate over R x M . Lemma 4.6 guarantees
that this integral is absolutely convergent, and that it is permissible to integrate by parts
so as to obtain an identity of the form

Bl +IV'BI*+-re?T B2
[ (el )

RxM

l"_l <1+ / eZS—2T|Va|2)’

RxM

(5-13)

when 7 is larger than some (A4, ) independent constant. Save this equation.

Introduce the differential form w = e2%(ds A a + *a). This is a closed, exact self-dual
2—form on R x M ; it is the exterior derivative of the 1-form %ezs a. Also introduce
F4 to denote the 2—form ds A B%A + xB4 on R x M . This is also a closed 2—form on
R x M ; it is the curvature 2—form of the connection A when the latter is viewed as a
connection on the trivial line bundle over R x M . Let 04 denote the covariant exterior

derivative on this trivial line bundle as defined by the connection 4 on R x M .
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Now define the 2—form
(5-14) o =040 AO4T + (1 —|a|?) Fy.

This 2—form is closed. Moreover, it follows from Lemma 5.1 and from Lemma 4.6 that
e*T|p| is bounded on R x M for any k > 0. This being the case, the 4—form w A o
is integrable over R x M . It also follows that the integral is zero since  is closed and

w 18 the exterior derivative of %ezs a.

To see what to make of this, introduce d4 = %(DA +ie™25 % (w Ay)); this operator
sends a given section over R x M of the relevant line bundle to one of the bundle’s
tensor product with 7% (R x M'). The conjugate, 04 = %(DA —ie 2 % (wADy)), is
the d —bar operator for the almost complex structure that is defined using the product
metric and the self-dual 2—form e~ ?*w. Granted this notation, then the vanishing of
the integral of w A g is equivalent to the assertion that

[ e (10aaP—TBaal + 7T (1=l + (1~ PSR
RxM

- [ ¢ (1=lal?){a. 2x + ).
RxM

(5-15)

Here, the notation (,) denotes the inner product that is defined by the metric on
M . Since the second equation in (4-1) writes 940 in terms of 94 B, and since [i
has compact support, this last equation with (5-13) implies the first of Lemma 5.5’s
inequalities. The first inequality in Lemma 5.5 with (5-13) implies the second. O

5.4 L% bounds for B, over [-6,6] x M

The next step towards a proof of Proposition 5.2 establishes a preliminary bound for the
L? norm of B 4 over the portion of R x M where —6 < s < 6. Here is the required
L? bound.

Lemma 5.6 There exists a constant k > 1 such that if r > k, and if (A, V) is a
solution to (4-1), then [ |B4|*> <«r.
[—6,6]xM

Proof of Lemma 5.6 Let {e,} C C%° (M ; TxM) denote a complete, L?—orthonormal
basis of eigenvectors of *d on the subspace of co-closed 1-forms. Thus, *de, = Aye,
where A, € R. For each index v, introduce the function s — b, (s) on R by the rule

(5-16) b, = / ey ANxBy.
{s}xM
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The top equation in (4-1) finds this function obeying the equation
d

5-17) _bv + )\ubv =o,,
ds

where v, | is defined to be the inner product on {s} x M between e, and the section
of iT*M over R x M that is defined by m = sd[re2T (yTcky —ia) + i x(xdp +
wg )+ i[1]. The equation in (5-17) can be integrated so as to give

o0
by(s) = —ehvs / e* 1o, (1)dt when A, < —1.

(5-18) s

N
by(s) = —e *vS / e* o, (1)dt when A, > 1.
—00

It follows from Lemma 5.5 that these integrals are well defined; this is because
(5-19) m+2ire*lal < co(1+re*" (laf|p] + 81 + [Va| +[V'B])).

In particular, (5-18) implies that
o0
16y ($)]* <Ay + 17! /e‘2’|mv(t)|2dt when &, < —1,

N
N

by (s)]? < Ay —1]7! / e?'|ro, (1)|?dt when A, > 1;
—o

and so (5-19), (5-20) with Lemma 5.1 give the bound

(5-20)

(5-21) > " Iby(s)]* < cor when s € [—6, 6].

v/
Here, the prime on the summation sign is meant to indicate that the sum is restricted to
the eigenvectors whose eigenvalue has absolute value greater than 1.

To obtain bounds for the remainder of B4, introduce now d4 to denote the covariant,
exterior derivative along the constant s slices of R x M as defined by the connection
A. Thus, *B4|a|* = @d4Va. Granted this, write

by (s) = / ey A *By

{s}xM
(5-22)
= / ey A%By(1—|a)?) + / ey ANodgVya.
{s}xM {s}xM
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Now integrate by parts in the right most integral to obtain the bound
(5-23) 16u ()] < v (| Balsll2l|(1 = la®)ls|l2 + 1 Vals] |2 + [ Vals])2?).
Here, ¢, depends on the eigenvector ey, ; but a uniform upper bound exists if |A,| < 1.

Meanwhile, by virtue of Lemma 5.5, there exist s € [—6, 6] where [|(1 — |a|?)|s|]2 <
cor ! and [|Vals||2 < cor~1/2. For such s,

(5-24) 1y ($)] = cor ™| Balsl2 +cor™/? when [3,] < 1.
This last estimate plus (5-21) finds s € [—6, 6] where || B4ls||> < cor'/? and
(5-25) by (s)| < cor~"/? when |A,| < 1.

To finish the story, fix some point in [—6, 6] where (5-25) holds, and integrate (5-16)
from that point using (5-25) and Lemma 5.5 to conclude that

1/2
(5-26) by (s)] 560(1+V_1( / |BA|2) )

[—6,6]xM

at all values of s € [—6, 6]. Equations (5-26) and (5-21) imply the lemma’s claim. O

The L? bound for B4 over the cylinder [—6, 6] x M can be coupled with what is said
in Lemma 5.6 to obtain an L% bound for B4 over [-5,5]x M .

Lemma 5.7 There exists k > 1 such that if r > k and if (A, V) is a solution to (4-1),
then [ (|§—SBA|2+|VBA|2)§KV.
[-5,51xM

Proof of Lemma 5.7 Let o here denote a smooth, non-negative function with compact
support on [—6, 6] with value 1 on [—5,5]. As d4 * B4 =0, so (5-16) implies that

0 2
/ (02)53/1\ +02|dBA|2+02|d*BA|2—20’0<BA,*dBA>)

(5-27) [—6,6]xM

= / o?|m|?.

[—6,6]1xM

This plus the bounds in Lemma 5.5 for the L? norm of m and the bound in Lemma
5.6 for the L? norm of B, imply what is claimed by the lemma. O
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5.5 Proof of Proposition 5.2’s assertion for points in [-2, 00) x M

The assertions of the proposition on [—2, 00) x M follow from the next lemma.

Lemma 5.8 There exists k > 1 such that if r > « and if (A, V) is a solution to (4-1),
then

0 0
‘8—A+BA‘ <re*T(1—|a|*) +« and a—A—BA|§re2T(1—|O(|2)+K
s s

at all points where s > —2.

Proof of Lemma 5.8 The bound for |%A + B 4| follows directly from what is written

on the top line of (4-1). The proof of the asserted bound for | %A—B 4| is a modification
of an argument from [6]. The proof for this bound is given here in four steps.

Step 1 It proves useful to introduce as notation F_ = %A—B 4 and F = %A +By.
Both F_ and F, are sections over R x M of i T* M ; they are obtained from the
2-form Fq=dsA %A + * B 4 by contracting the respective anti-self dual and self-dual
parts of the latter form with the vector field ;—s. Note in this regard that Fy4 is the
curvature 2—form for the connection A when the latter is viewed as a connection for
the trivial bundle over R x M . The fact that F4 is a closed 2—form is equivalent to
the pair of equations

0 0
(5-28) B_F_ +*xdF_ = 8—F+ —xdFyandd x F_ =d x F.
s s

Here, d again denotes the exterior derivative along the constant s slices of R x M .
Note that the right hand sides of both of the equations in (5-28) can be written in terms
of Y using the first two lines in (4-1). Doing so, and then differentiating the preceding
equations using appropriate combinations of partial derivatives gives a second order
equation for ¢ 27 F_. The latter equation implies a differential inequality for the
function ¢_ = €_2T|%A — B4| that has the form

(—828s2 + d*d)q_ +2re?T|a)?q

(5-29) T R
Scoq_+r5+2r(‘—a‘ + |Va| +‘—,3‘ +|V'B] )
as as
Here 3 has support where s < ¢g; and 3 < ¢¢ in any event. This equation implies the
following lemma. O

Lemma 5.9 There exist k > 1 and positive constants k1, k, and k3 such that if
r >« and if (A, V) is a solution to (4-1), then gy = max(qg— +«17|B|*> — (r + k2)w —
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k32T 0) obeys

32
(5-30) (_Eis_z + d*d)qo +2re*Ta|?qo < colqo + rw?).

Proof of Lemma 5.9 By virtue of (5-10), x; = g— — (r + ¢)w obeys

82
(——2 + de)xl +2re?T o)X,
(5-31) s

] 2
<coxi+co(r +c)ws +reg+ 3r(‘£,3‘ + |V’,3|2) —c|Va|?.

Here, w4 = max(w, 0). Set x, = x; + 4r|B|?; given the bottom equation in (5-9),
Xy obeys

82
(5-32) (_33_2 + de)xz +2reT |a|xy < coxa + co(r +c)wy +rco

when ¢ > ¢g and r > ¢g. Now let x3 = xp — e 2T ¢/ Then this function obeys

32
(_8_2 + de)X3 +2re?T ja|?x3
s

<colxs+rwy)+reo(l+¢'/r)=2r|a|?c.

(5-33)

When r > ¢q. Now, take ¢’ > co(1 + ¢’/ r) so that the right hand side of (5-33) is no
greater than

(5:34) co(x3 +rwy)+reo(l+¢/r)(1—|a)?) —rlal?c
<coxs +reo+c/rwy —rla)?c.

If it is also the case that ¢/ > ¢¢(2 4 ¢’/r), then the right most two terms in (5-34) are
no greater than rco(2 + ¢’/r)(w+ — |a|?). Since w4 — |a|? < wi < w?, the claim
follows. m|

Step 2 This step bounds ¢g on the cylinder [—4,4] x M .

Lemma 5.10 There exists a constant, k > 1, such that when r > k and (A, V) is a
solution to (4-1), then q¢ < irl/? at points in [—4,4]x M .

Proof of Lemma 5.10 Fix a smooth function, x: [0, 00) — [0, 1] that equals 1 on
[0, %] and vanishes on [%, 00). For p e Rx M, set x, = x(dist(-, p)). Meanwhile let

Gp denote the Green’s function for the operator (—(,fs—zz +dTd) with pole at p. Note
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in particular that |G,| < co(1 + dist(-, p))~2. Take p € [—4,4] x M, multiply both
sides of (5-30) by x,G, and integrate. A judicious integration by parts finds that

(5-35) wlp=cor' e [ dist(p) a0+ ro),
[—5,5]xM

Here, Lemma 5.6 has been invoked to bound the L? norm of ¢y on the support of
dxp. Note next that it follows from Lemma 5.6 and Lemma 5.7 that the L? norm
over [—5,5]x M of the function dist(p,-)~!g_ is finite, and bounded by cor'/?. As
a consequence of this and Lemma 5.5, the size of the integral on the right hand side of
(5-35) is less than corl/z. m|

Step 3  Fix a smooth function, o: R — [0, 1] that vanishes where s < —2.75 and is
equal to 1 where s > —2.5. The function o¢q has support where s > —3 and it obeys
the inequality

82
(—3—2 e d)(Gf/o) T re*Tlal(040)
(5-36) §

d
< co(0go +row?)—a"qo —20,$6]0

when r > ¢o. Equation (5-36) is used to bound the L' norm of eZTaqo; this done
as follows: First, introduce z to denote the supremum of r ~'o¢gy. Now, divide both
sides of (5-36) by r and integrate to find that

(5-37) / 62T0q0 <cp / 62T0q0w+c0< / w? + r_l/z).
RxM RxM [—3,00)xM

Here, Lemma 5.10 is used to obtain a bound of cgr 1/2 for the absolute value of the
integral of go over the region where o is non-zero. Equation (5-37) with Lemma 5.5
implies that

1/2
(5-38) / e”oqoscosup(loqo|”2)< / €2T0610) r= 4 cor1/2,
RxM RxM

Since sup(oqg) = rz, this then implies that

(5-39) / 2 Togo <co(r 'z +r712).
RxM
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Step4 Let p € [-2,00) x M . Multiply both sides of (5-36) by x,G, and integrate.
Since o = 1 on the domain of x,, what with Lemma 5.5 and (5-39), the resulting
equation implies that

oqolp < co( zr [ dist(-, p) 2wy + 1 / dist(-, p)_zwz)

(5-40) dist(-, p)<1 dist(-, p)<1

<coe Tz +Inr)+1)

when r > ¢g. A similar argument for the case when p € [-3,—1] x M using also
Lemma 5.10 finds that

(5-41) oqolp < coz(1 +1n(r)) 4 r'/?).

Together, (5-40) and (5-41) imply that z < cor_l/ 2 Granted that such is the case, then
(5-40) implies the assertion made in Proposition 5.2 where s > —2.

5.6 Proof of Proposition 5.3 at points in [—1, c0) x M

Suppose that p € R x M, that ¢ > 0 is a given constant, and that |%A| +|By| <cr on
the ball of radius % centered at p. Rescale a Gaussian coordinate system centered at
p so that the ball of radius r1/2e7T g mapped to the ball of radius 1, centered at the
origin in R*. As argued just prior to (5-1), given R>1,e>0and k €{0,1,2,...},
there exists »(R,¢&,k,c) > 1 that is independent of p, r and (A4, ¥) and has the
following significance: If r > r(R, e, k,c), then the pull back of (A4, ) via the
composition of the Gaussian coordinate chart map and the rescaling map will have
Ck distance ¢ or less in the radius R ball centered at the origin in R* to a pair,
(Ao, Yo = (0, 0)), that is defined on all of R* and obeys (5-1). As the norm of
the curvature of Ay is uniformly bounded, the absolute value of the 4y—covariant
derivative of ¢ is bounded by some c—dependent constant, co(c). Rescaling back to
the original Gaussian coordinates gives |Va| < co(c)r!/2eT®) at p.

Now, suppose that § > 0, that p € [—-1,00) x M, and that 1 — |«|?> > § at p. As
Proposition 5.2 holds on [—2, c0) x M , the preceding bound for |V«/| holds near p,
and so it follows that there exits ¢q > 1 that is independent of p, r, and (A, ¥) such
that when r > ¢g, then 1—|a|? > %5 in the ball of radius cor ~/2¢=T(P) centered at p.
This implies that the ball of radius r~1/2=T(P) centered at p contributes ¢’ 182r=1 to
the first integral in Lemma 5.5. As a consequence, there is a set of at most Ny = co8 ™2
disjoint balls in [—1.5,00) x M with the following two properties: Let U denote
any given ball from this set and p its center point. Then U has radius r~1/2¢=T(P) |
Second, (1 — |a|?) is greater than § at p.
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To see that there are no points in [—1.5,00) x M where 1 — |a|?> > § when r is
large, suppose to the contrary p € [—1.5,00) x M is such a point. Fix R > 4Ny and
€ (0, ﬁS). Suppose that ¥ > r(R, €, 0). Pull back (A4, ¥) as described in the opening
paragraph using a Gaussian coordinate system centered at p. Then the pull-back of o
is within & of g where (A, o) obeys (5-1) on R*. Moreover, 1 — |ag|? > %8 at the
origin but 1 — |ag|? < %8 on a sphere of radius 1 or more centered at the origin. As
explained next, this is not possible.

To see why no such (A4g, ag) exists, suppose first that |eg| > 0 in the interior of the
sphere in question. Then there is a gauge transformation that renders o« as e™* with
u > 0 a smooth solution to (5-3) on the interior of the sphere. Note that u is smaller at
all points on the boundary than it is at the origin. This being the case, ¥ must have
a local maximum in the interior of the ball. However, the maximum principle with
(5-3) rules out such a point. Meanwhile, if @y = 0 in the ball, then its zero locus is
non-empty, and so a complex analytic curve. In particular, the zero locus can’t be
compact and so must intersect the boundary of the ball.

5.7 The behavior of a(4,¥) on {s} x M for s € [-1, 0]

The proof of Proposition 5.2 for points in (—oco, —2]x M starts here by saying somewhat
more about the (A4, ¥) on [—2, 0]x M . The discussion that follows refers to the version
of a that appears in (1-4). With s € (—o0, 0) given, set a|s to equal a(A4(s), ¥(s))
when (4, ) is a solution to (4-1).

Lemma 5.11 There exists a constant, k > 1, with the following significance: Suppose
that r > x and that (A, ) is a solution to (4-1). Then ffl lals|ds < Kkrl/2.

Proof of Lemma 5.11 The conclusions of Proposition 5.3 where s > —1 assert that
the section « of I¢ has norm very near 1 on the whole of [—1, 00) x M when r > ¢g.
As a consequence, there is a smooth map, u: [—1, 00) x M — S such that ua = |a|1c.
Meanwhile, 4 —u~'du can be written as A7 +a on [—1,00) x M with

(5-42) ja| < ||~ Val.

It follows from the fourth point in (4-1) that u is homotopically trivial. Since the map
u is null-homotopic, the function a has the same value on (A(s), ¥ (s)) as it does
on the pair (A7 + @, (Ja|1¢,upB)). This understood, it follows from (5-42), Lemma
5.5 and Lemma 5.8 that ffl |es|s| < cor™'/2. Tt also follows from these results that

ffl lewls| < co. Meanwhile, integrating by parts finds

(5-43) / Els] <2 / @] < cor'/2.

[—1,0]xM [—1,0]xM
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Here, the right most inequality follows using (5-42) with Lemma 5.5. Thus, the term
with rE in (1-4) contributes at most cor /2 to the integral of |ay|. Finally, the integrand
for the right most term in (1-4) is bounded by the integral of co(|8| + |Va|+ |VB]).
As a consequence, Lemma 5.1 and Lemma 5.5 imply that the integral from —1 to 0 of
the absolute value of right most term in (1-4) is also bounded by c¢qr'/2. a

2 L) 9
5.8 L* bounds for ;-4 and 3¢
The statement of these bounds uses
(5-44) Bay) = Ba—r(Wichy —ia) —i(xdu + wg).

The next lemma says something about the Z? norms of 354 B,y 35 w and D4r.

Lemma 5.12 There exists « > 1 such that if r > « and if (A, V) is a solution to (4-1)
with s — —oo limit equal to ¢, then

/ ()a A‘ + Byl +2r(‘%¢‘2+|DAW|2)) < a(c) +irl/?

(—o00,—1/2]xM

Proof of Lemma 5.12 Fix R > 1 and a point ¢ € (—R, 0). The top two equations in
(4-1) imply the integral identity

A +|%<A1,,)| +2r iwz+|DAxp|2
as as

[-Rt1xM

t
d
- / %(as) =0_-R—0;.
—R

By virtue of the third point in (4-1), the R — oo limit in (5-45) can be taken and doing
so finds

(5-45)

(5-46) / ()a A‘ + B4, +2r(‘%lﬁ‘2+|DAlﬁ|2)) <a(c) —als.

(—oo,t]xM

Meanwhile, Lemma 5.11 guarantees points in [—%, 0] where |a|;| < cor'/?. Take ¢ in
(5-46) to be such a point and the claim in Lemma 5.12 follows directly. O
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5.9 Proof of Proposition 5.2 for points in (—oo, —1] x M

The first step here is to obtain a local L? bound for B4. This is the part of the proof
that assumes something about the s — —oo limit of a((4,v)). To set things up, let
I C (—o0,—1/2] denote a compact interval. The bound given in Lemma 5.12 is going
to be used in what follows to derive L? bounds for B4 and Vv on I x M. To do so,
use the Bochner—Weitzenboch formula for the Dirac operator to write

/ (1B, *+2r | Dgyr[?)

{s}xM
= [ (BaPr it er—ial + 20 (VP + 9 TRY))
{s}xM

(5-47)

+2i / (BA—r(wTrlﬁ—ia))/\d,u
{s}xM

—2ir / (WT‘L’\/I—Z'CZ)/\*ZD'K—2VE(A(S)).
{s}xM

Here, R is an endomorphism of Sy that is independent of r and (4, ¥). As can be
seen from this last equation, bounds on the integral over I x M of |B4|?, |Vy|? and
|yt —ia|? will follow from the bound given in Lemma 5.12 together with a suitable
bound for E. In any event, it follows from Lemma 5.12 and (5-47) that

(5-48) / (1B4P+r2 [y ey —ial® +2r (VY |* + ¢ TRY)) < colex + D)r?
[s,s+1]xM

when limg_, oo a((4, ¥)) < c«r?. This last equation gives the desired L? bound for
B,4. Note in this regard that it is always the case that such a bound exists for the
§ — —oo limit of a. Indeed, this follows from (1-6) with Proposition 1.10.

To continue with the proof of Proposition 5.2, repeat the argument that led to Lemma
5.9 to deduce the existence of r and (A4, ¥) independent constants x > 1 and x{_3
such that when r > « and (4, V) is a solution to (4-1), then

0
(5-49) qozmax(‘a—A—BA‘+K1r|,3|2—(r +K2)w—/c3,())
S
obeys the 7" = 0 version of (5-30) where s < 0. For the sake of argument, assume

that go > 10r on (—o0, 0] x M . It then follows from Lemma 5.8 and the s > —1
version of Proposition 5.3 that ¢q takes on its maximum on (—oco, —1]x M if r > ¢y.
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Let p a point where this is the case. Let so be such that the support of x, lies in
[so — 1,50 + 1] x M . Multiply both sides of (5-30) by x,G,, integrate the result, and
integration by parts finds
Golp = ¢o / qow-+ xpdist(p. )~
RxM
(5-50) 1/2
+cor f w? ypdist(p.) % + co / 6]02) :
RxM [so—1,50+1]xM

By virtue of (5-48), the right most integral in (5-50) is bounded by ¢ (1 + ¢)r. The
middle integral on the right hand side of (5-50) is also bounded by cor. To make
something of the left most integral, fix p > 0 and divide the integration domain into
the part where the distance from p is greater than p, and the complementary part. The
contribution from the former is no greater than an r —independent multiple of |1n p| 1/2
times the L2 norm of g over [so — 1,50 + 1] x M. The part where dist(p,-) < p
contributes at most ¢op%qo| p. This is because go|p is the maximum value for ¢ . Take
p so that this last contribution is equal to %qo |p to obtain the bound asserted by the
lemma.

5.10 Proof of Proposition 5.3 for points in (—oo, —1] x M

To start, reintroduce on R x M the closed 2—forms w = e?*(ds A a + *a) and
Fy=dsA %A + % B 4; and reintroduce 04 to denote the covariant, exterior derivative
on the trivial bundle over R x M that is defined by the connection A.

Fix an increasing function o: [0, o0) — [0, 1] that has value O on [0, %] and equals 1
on [1,00). Write ¢’ for the derivative of 0. Use oy to denote the function on R x M
given by o(87!(1 — |«|?)). Likewise, use oy to denote o' (671(1 — |a|?)). With all of
this notation set, let

(5-51) 95 =8 05040 ND4T + 05 F 4.

This is a closed 2—form on R x M . The s > —1 version of Proposition 5.3 implies
that this form has support where s < —1 when r is large. It is also the case that |gj]
is bounded on R x M by co8~!r; this a consequence of Lemma 1.6 and Lemma 1.7.

Granted what was just said, it follows that |w A gg| is integrable on R x M, and thus
so is the 4—form w A 5. Moreover, because |pg| is bounded and s is bounded from
above on its support, an integration by parts can be employed to verify that the integral
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of w A g over R x M 1is zero. The vanishing of the integral of w A g asserts that

e (57 050402 = [3.401)
(5-52)  RxMm
+reTos(1 = fa2 + B2=r~"e ™2 (a, 201 + 1)) ) = 0.

Two auxiliary results are needed in order to make something from (5-52). These are
stated in the next lemma.

Lemma 5.13 There exists k > 0, and given ¢ > 1 and § > 0, there exist constants
rs > 1 and kg > 0; and these have the following significance: Suppose that r > rg and
that (A, V) is a solution to (4-1) such that |83—SA| +|By4| <cre? . Then

|040| < k.
Let Qg denote the integral over R x M of ¢?$¢*T
over R x M of e*S0g),. Then QY <ksQs.

os and let Q:S denote the integral

This lemma is proved shortly.

Granted that it is true, note first that its assumptions are implied by Lemma 5.1 and
Proposition 5.2. This understood, then (5-14) implies that

(5-53) (k528 +r8(1—r~18671eg))Qs < 0.

When r > rg. It follows from this last inequality that there exists r’s > rs such that
Qs = 0 when r > r’s. Of course, this implies what is asserted by Proposition 5.3.

Proof of Lemma 5.13 The second equation in (4-1) equates 940 to a linear combi-
nation of covariant derivatives of 8. This understood, the first item follows with an
appropriate bound for |%,3| + |V’B]. To obtain the latter and to prove the second item,
fix a point p € R x M and a Gaussian coordinate system centered at p. Rescale the
Gaussian coordinate as done in Section 5.1 so that the ball of radius r~'/2e=T(?) in
the original coordinates has radius 1 in the rescaled coordinates. Fix R > 1, ¢ > 0, and
k €{0,1,2,...} and reintroduce r(Re, k) from this same subsection. As in Section
5.1,if r >r(R, ¢, k), there exists (A4g, (@g, 0)) with the following two properties: First,
Ao and «g are defined on all of R* where they obey (5-1). Second, (4y, (g, 0)) has
distance less than ¢ in the C¥ topology on the ball of radius R about the origin in R*
to the pull-back of (4, («, 8)) via the composition of the Gaussian coordinate chart
map and the rescaling map.
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Let B, denote the pull-back of B, now viewed as a complex number valued function
on the ball of radius R in R* by using the Gaussian coordinates to trivialize the bundle
K. This understood, the pull-back of (5-5) implies an equation for 8, in the ball of
radius 1 about the origin in R* that has the form

0
(5-54) _Aﬂr + Z Rj W

-Br +R(Br)+r7'R =0,
j=1,...,4 J

where {|R;|}j=1,..4, |Ro| and |R’| are all bounded by coc. Granted that <cor~1/2,
it is a straightforward matter to use the Green’s function for the Laplacian A to see
that |aixj Br| < cocr—1/2. The rescaled version of this last bound implies the first item
of the lemma.

Now consider the second item in the proposition. Its proof requires a related assertion
about solutions to (5-1). a

Lemma 5.14 Given ¢ > 0 and § € (0, 1), there exits Rg > 2 and kg > 1 with the
following significance: Suppose that (Ag, ) satisfies (5-1) on R*. Let V denote
the volume of the subset of the ball about the origin in R* with radius Rs where
(1 —|a|?) > §; and Iet V' denote the volume of the subset of the concentric ball of
radius %Ra where § > (1 — |a]?) > %8. Then V' <kgV .

Proof of Lemma 5.14 Suppose that § is fixed, as is R > 2. Let (Ag, ag) obey the
stated conditions. Suppose, for the sake of the argument, that V/ > 0. There are
two cases to consider. In the first case, there exists x € R* with |x| < %R where
1—|a|? > 28. Under the stated conditions, there is an a priori upper bound for the norm
of the covariant derivative of & at each point in R*. This bound depend on the constant
¢ in (5-1); in any event, let ¢ denote a bound with ¢, > 1. Then 1 — |a|? > § in the
ball of radius %5c*_ ! centered at x, and so V is no less than coc; *84. Meanwhile, V'
is no greater than the volume of a radius %R ball in R*, thus no greater than ¢y R*.

This implies that the conclusions of the lemma hold with k5 = cocy Yg—4 R4,

The second possibility is that (I —||?) < 2§ at all points in the ball of radius %R
ball centered on the origin in R*. To see what this implies, recall that there is a
gauge transformation in this ball such that takes « to e ™, with u a positive function.
Moreover, as u < %| In(1 — 28)|, there exists €5 such that 1 —e™2% —ggg > 0 in this

—2u

radius %R ball. The function u also obeys the equation Au = 1 —e™ %, and so this

means that Au —egu > 0 in the radius %R ball centered on the origin. It then follows
using the comparison principle that

1 1/2(3
(5-55) ulx < 5| In(1 - 29) exp(—sa (ZR— |x|))
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at all points with |x| < %R. Note that this is not compatible with the assumption
V' #0if R> Rs =8¢ /> In(1 - 28)/ In(1 — 15).

To continue the proof of Lemma 5.13, fix R = Ry as given in Lemma 5.14, and
fix a set, A, of balls in R x M with the following properties: First, each ball in
A has radius %Rr‘l/ 2 and center where § > (1 — |a|?) > %8. Second, distinct
balls from A are disjoint. Third, A is maximal amongst all sets that satisfy the first
two criteria. For each ball Uy C A, let U’ denote the concentric ball with radius
1Rr=1/2 ‘andlet U denote the concentric ball with radius Rr~!/2. When r is large
(as determined solely by §), the set Up U’ covers the set of points in R x M where
§>(1—|al?) > %8 . This follows by virtue of the fact that A is maximal. Note that
there is an r, (A4, ¥) and § independent bound to the number of distinct versions of U
that can simultaneously intersect. Granted this, it follows from Lemma 5.14 that there
exists rg that is independent of (A4, ) and is such that if » > rg, then the volume of
the set of points in R x M where § > 1 — || > %8 is bounded by an r and (4, V)
independent multiple of the volume of the subset in R x M where 1 —|a|> >§. O

5.11 Proof of Proposition 2.9

The key to the proof that B(r) is non-empty when r is large is the proof of the following
assertion.

Proposition 5.15 There exists ry,. > ry with the following significance: Suppose that
r >ry. If p € p is sufficiently small, then the (r,g = e, + p) version of the moduli
space M,=1(c, cy) is empty when c¢ is a non-degenerate solution to (1-3).

This proposition implies that §(¢; 4 tv) can not vanish if tv lacks the generator cj.
Indeed, were this class to vanish, then there would exist a class 3 of degree 1 such that
83 = ¢y + w this is because the Seiberg—Witten Floer homology is assumed to vanish.
This is impossible if there are no instantons with s — oo limit equal to ¢z .

Proof of Proposition 5.15 It is enough to prove that M,—(-, ¢;) is empty for the
p =0 case. Indeed, if this is true, then some very minor modifications to the compactness
arguments from [7, Chapter 16] forbid a non-empty version of M,=1(:,¢;) when p is
non-zero but has small norm. The proof of the p = 0 version of Proposition 5.15 has
four steps.

Step 1 Suppose that ¢ and ¢’ are non-degenerate solutions to (1-3) and that the moduli
space M, (c,¢') £ . Let 0 = (A4, %) € M,(c,¢).
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The arguments that lead to the conclusions of Lemma 5.1 work here to prove that
la|? < 1+«kr~"and |B]? <kr~'(1 —|a|?) +kr~2. Indeed, simply set T =1 in the
proof of Lemma 5.1 given in Section 5.1 and use Lemma 1.6 to control the large |s|
behavior of || and |B].

Step 2 The first point to make is that |a(c) — a(¢')| < cor?. Indeed, this follows
from (1-6) with Proposition 1.10 since the degree of ¢ is ¢ less than the degree of ¢’.
The next point is that (5-46) holds in this case, but now where ¢ € R is allowed. In
particular, taking ¢t — oo finds that

a |2 9 2
(5-56) / (‘gfl‘ +|%(A,1//)|2+2r(‘$1/f) +|DA‘/’|2))§C0”2

RxM

since |a(c) —a(c’)| < cor?. Tt is also the case that (5-47) holds, where now s can have
any value in R. This understood, it follows from (5-56) that (5-48) holds with ¢4« < ¢g
for any s € R.

The arguments used to prove Lemma 5.9 can be repeated once again to find r and
(A4, ) independent constants k > 1 and k;_3 such that when r > «, then g as defined
in (5-49) obeys (5-50). Since lims|_o0 o =< cor, the argument used at the end of
Section 5.9 to finish the proof of Proposition 5.2 work just as well in the present context
to prove that gy < cor on the whole of R x M . Here is an immediate consequence.

Lemma 5.16 Given ( € Z, there is a constant k > 1 with the following significance:
Suppose that ¢ and ¢’ are non-degenerate solutions to (1-3) and that (A, ¥) € M,(c, )
is a solution to the r and g = ¢, version of (1-10). Then |%A| + | B4l < kxr.

Step 3 Now specialize to the case where ¢ = ¢;(r). Fix § > 0 and reintroduce the
function o5 from Section 5.10 and the 2—form gy from (5-51). There exists rg > ry
such that when r > rg, then the function s has an upper bound on the support of
gs. This is the case for any choice of ¢ and for any (A, ¥) € M(c,cz(r)). Let
w = e?%(ds Aa+ *a) as in Section 5.10. Then w A gy is integrable when r > rg, and
the integration by parts can be performed to see that its integral is zero. This implies
that (5-52) holds with 7" and i set to zero and with x identically equal to 1.

The following analog of what is claimed by Lemma 5.13 is needed to exploit this new
version of (5-52). O

Lemma 5.17 Given 1€ Z and § > 0, there exists rg > ry and kg > 0 with the following
significance: Suppose that r > rg, that ¢ is a non-degenerate solution to (1-3), and that
the pair (A, ) is in the r and g = ¢,, version of M,(c, ¢;(r)). Then

|04a] < k.
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Let Qg denote the integral over R x M of e?Sog and let Qg' denote the integral over
R x M of e*0g/,. Then Q' < k5.

Proof of Lemma 5.17 Given what is said by Lemma 5.14, the proof of this lemma is
essentially identical to that of Lemma 5.13.

With Lemma 5.17 in hand, then (5-53) is also true in this case, as is its conclusion, that
Q5 = 0 when r > ry, where ry is independent of ¢ and of (A4, V) € M,(c,¢1).

Step 4 To complete the argument, fix some small, but positive § and take ¢ = 1
to define 7y as in the previous step. Suppose that r > rs, that ¢ = (4, ¥ = (a, B))
is a solution to (1-3) and that M,— (¢, c;(r)) # &. It then must be the case that
1 —|a|? < § at all points in M . If § is sufficiently small, this and Lemma 1.6 imply
via the uniqueness assertion of Proposition 2.8 that ¢ = u - ¢y (r) with u a smooth map
from M to S!. But this isn’t possible as the spectral flow between ¢ and ¢z (r) is
assumed equal to 1 while the spectral flow between any gauge transform of ¢;(r) and
¢s(r) is an even number. O
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