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EXPECTED VALUES OF FUNCTIONALS WITH RESPECT
TO THE ITO DISTRIBUTION

MICHAEL SCHILDER

Stochastic differential equations of the type (written sym-
bolically)

(L) a™(t) + m(t, x"=1(¢), at»=2(2), - -, &’ (T), 2(t), t) = 2'(D)
#(8S) =ap, 2'(S)=a, -+, 2 N(S) =0y S=t=T

where z(t) is Brownian motion, arise in physics and engineer-
ing and are also the object of study of pure mathematicians.
In this paper it will be shown that the integral associated
with the distribution of the function x(-) may be expressed
in terms of a Wiener integral with a weighting functional
(the Radon-Nikodym derivative). Thus the expected values of
functionals with respect to the distribution of 2(-) can be
easily and concisely expressed. Also it will be shown that
certain partial differential equations of physics naturally have
their solutions associated with this integral,

To proceed more precisely, following Ito [7], we rewrite the first
order case of (1.1) as

1.1y o(t) + Ssm(u e(u))du = 2(t)

and ask about solutions of (1.1)’. With certain conditions on m(t, x)
it is possible to conclude that for almost every z(:) (Wiener or
Brownian motion measure) in C[S, T'], where C[S, T'] is the class of
continuous functions on the interval [S, T'] whose value at S is a,
that (1.1)" has a unique solution #(-). See [2] for example. We ex-
press this by writing

(1.2) r=Gz.

Clearly now, the most natural definition for the distribution of
2(-) is as follows:

P(x(-)e A) = Py(zc G4A) .

Py, is Wiener measure, and A is a set of functions contained in C[S, T]
which is such that G—'A is Wiener measurable. The distribution P( )
so defined will be called the Ito distribution and will be denoted from
now on by P,( ); the associated integral will be denoted by E,( ).

This approach has been taken before. (See [4] and [5].) How-
ever in this paper it will be shown that explicit expressions for the
expected values of various functionals arising in physics and engi-
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neering can be given in terms of Wiener integrals. In particular a
number of the thermodynamic functions can be so expressed. Further,
the results of this paper shed some light on the Feynman-Kac [8]
formula for Wiener integrals.

2. The integral. In this section, the definiton of the Ito distri-
bution which was given in the introduction, will be given rigorously
and the integral with respect to it will be defined.

Let T, be the integral operator

Ty (@)(t) = S;x(u)du toa,,

and let y(t) = "~V (¢).
We note that (1.1) may be written

@Dy + | ml, v, T, -, TuToss -+, (T w)du
= 2(t) .

As in the introduction, if certain conditions are put on m(¢, z,_,,
-++, @), then it follows that for almost every zeC|S, T}(2(S) = a,_,)
Wiener measure there is a unique solution to (2.1). We express this
again by writing y = G=z.

As in the introduction, this transformation induces a o-field and
a measure on the y space, which we again call the Ito measure.

From now on the notation for the sets over which integration is
performed will be left out if the meaning is clear.

We now have the following theorem:

THEOREM 1. If F(a"", -.- ) is a functional which 1s measur-
able and integrable with respect to the Ito distribution just defined
and if for almost every ze C[S, T] (2.1) has a well defined solution,
then

SF(x(n-I)v ct ety x)dPI(x(n_J)v ct CX/')

- §F<Gz, T,Gz, -+, To(Tu s, -+, TH(G2))APy(2) .

Proof. The proof follows immediately from the definitions.
There is the rather interesting and useful corollary.

COROLLARY. Suppose a,_;(t) are continuous real valued functions
for St<T,j=1,---,n, and that A is the matrix
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0 1 0 0
A(t) = o0
) —alt) —aft) - a(t)

Let @(t) be the (matriz) fundamental solution to the equation
qjuc(t) = ; Au(t)@jk(t) .
Then

(1) () = 3 0u)| Oriw)A, Wew)du

©s a solution to the imtegro-differential equation

V(L) + S; S a,_j(w)ri(wydu = 2(t)

(i) @9(t) = 50,0 P A, @awdu + b,_a()
(iii) The Ito distribution defined by

(2.2) () 4 3 an (D) = 2(1)

and
B(s) = BV(s) = BH(s) = +++ T™s) = 2(s) = 0
18 Gaussian with
EfEZ9t)}=0 7=01,--,m—1 and S=<t=<T

and

ti( ty
EAz0v@) @2 (t,)) = 3, gISS@jlkl(tl)@;;lL(ul)AlLn(ul)@jzkz(tz)(p;;l2(%2)

kylikgly JS

Ajp(;) min (w, — S, u, — S)dw,du,
ty .
30506 0, (1) A1) min (= S, b — S)duds
11

t2 .
+ kZl‘ ¢j2k2(t2)SS(p;;zz(uz)Alw(uz)Azzn(u'z) min (uz - S, t, — S)duzain—l
als
+ 8jibiamin (t, — S, t, — S) .

Proof. (i) and (ii) follow by direct verification, which can be
accomplished without differentiating z by using integration by parts.
To find the distribution %(t), the method of characteristic functions
is used. By definition, the distribution of Z/'(¢) is that of x7(t). Thus
from theorem 1, this definition, and (i) and (ii),
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| exp [i039(1)1P.@) = | exp Live 1Py (x)
= Ew(exp [w(% d),-k(t)s;(D;f(u)Aln(u)z(u)du + 5jn_1z(t)>]) )

The last Wiener integral is known to be

t(t
exp [—vz/z(k s SSSSaml(t)@;;hwl)Alln(ul)
1l1k2l9
X @50 (07 () Ay () min (u, — S, U, — S)dudu,
+ 2 1; @jkl(t)gl@;llzl(u)Azln(u) min (u — S, ¢ — S)dud;,_, + 5iﬂ—lt)]
141 :

Thus Z9(¢) j=0,---,n —1 is Gaussian with mean zero and
variance

t

t
| 210 OPE () A, (1) 10)
X @;21l2(u2)A,2n(u2) min (u, — S, u, — S)du,du,

t
+23, @;,,‘l(t)gS@;;l‘ll(u)Alln(u) min (u — S, t — S)dud;u_, + 050t .
141

Eyliksly Ss

To calculate E,(%1(t,)%2(t,)), we note that
E(@4()%2(t,)) = E(@(t)x*(2,))
= B[ 3 000)] 058,000 Ay w)e )i, + 3502(8) )
kily s

(AN AICAYIMOAC TR )

0 ts
= 3 S;SS@51k1(t1)(3;1111(u‘)A‘1”(u1)@12k2(t2)

Kqliksls

X szltz(uz)Alzn(uz) min (v, — S, %, — S)du,du,
3 0y (0] O () Ay on) mim (= S, 8, — S)du, 05

¢

+ I;: @jzkz(tz)s:@;2112(7'('2)Azzn(u2) min (4, — S, ¢, — S)du131‘zn—1
2l2

+ 5jln—15j2n—l min (t1 - Sy tz - S) ’

which completes the proof of the corollary. For another from of this
corollary, see [10].

3. The transformation theorem. It, unfortunately, is not
nearly as easy to invert (in the sense of (1.2)) the general nonlinear n™
order ordinary differential equation as it is the linear one. It, there-
fore, is necessary to use more general methods to study the Ito dis-
tribution. It is an interesting fact that inverting (2.1) is in some
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way equivalent to changing variables in the Wiener integral. In this
section, this idea will be made more precise. The analysis leans heavily
on the work of Cameron and Martin who developed the transformation
theory of the Wiener integral with their students.

THEOREM 2. Suppose m(t,x,_,, *--, &, %,) %8 o real valued, con-
tinuwous, and continuously differentiable function on R"*'. Suppose
also that for almost every zeC[S, T(2.1) has a unique solution.
Then, 1f F(z™™, z2 .. &' x) is a measurable and integrable func-
tional on the Ito space defined by (1.1) and the conventions agreed
upon at the beginming of § 2,

3.1 [FEo, o, oo, o, )P, 5070, oo, 0, )
- SF(y, Ty, «+ey To(Toss, -+, (Te)))

x exp| | p(t, @), -+, Tu(Tussy -+, (Tae)it]

x exp[— M(T, Toy(T), +++, T(Toeyy +++, (To)T)]AP, ()
x exp [M(S, a,_;, +++, a)] .

where
Tp—1
M(ty Lpgy >0 %y xo) = S m(ty Wy Lygy **°y xo)du
0

and

Tpj — FM°

n—j

Dty Tpgy =0y T) = My, + M, + ZZM,
£

It will be noted that Theorem 2 allows one to express the Ito
integral without solving (2.1) for almost every zeC|[S, T].

Proof. From Theorem (I) it follows that
[F@=, @, oo P, -, )
= SF(yy szy M) Tn(Tn—»u ct Y (sz)))dpw(z) .
The result then follows immediately from [1] equation (3.6).
Note that Cameron uses a slightly different definition of the
Wiener integral that usual. The result here is also generalized to

include the case of arbitrary final time T and arbitrary initial values
Gy, *+*, Uy, and time S,



376 MICHAEL SCHILDER

4. Partial differential equations. In this section, we will show
that the solutions of certain partial differential equations of physics
are naturally given by integrals of the form (3.1). Let

H(xn—ly ceey X bn-—ly 0y bo) =1 if Lpy é bn—ly ey X g bo
=0 otherwise. And let

p(t: Lp—1y ** .’1)0) = %m,"~1(t, Lty ** %, xo) + Mt(t: Lyegy **°, xo)
=+ ZJMSD (t; Lpry =y xo)xn—j - %mz(t) Lpo1y ** xO) .

n—j
We note that with the conventions agreed upon at the beginning
of §2,

P<bn——19 Tty bo; Wy_yy ="y Qo t) = prObabﬂity (x(n—-lJ(t)
S b, oo, 2(t) S b | TS) = @y, o0, (S) = @)

is a well defined function of 2n + 2 variables. The following theorem
follows immediately from Theorem 2.

THEOREM 3. If m(t, ®,_,, ---, &,) satisfies the conditions of Theo-
rem 2, then,

P(bn—ly D) bo; QAy_qy **y Ay t)
- §H(y(t>, e, To(Tosy oy (T))(E); basy =+, by)

« exp| [ o, yw), oo, TuUTurs, -+, (Tap)up)dn ]

X exp [—M(T’ y(T)’ cecy Tn (Tn—n c Sy (Tz(y)(T))]de(y)
X exp [M(S! Ap1y ***, aO)] .

Theorem 8 shows that the function P(b,_,, +++, by} Qpu_y, =+, Co; t)
may be expressed in terms of a Wiener integral. It will presently be
shown for the first order equation, anyway, that the Ito distribution,
defined in § 2 is a Markov process, and thus it follows that P(b,_, +--,
bo; Qy_yy =+, @y t) is its distribution function. It also follows that
P,_i, +++, b au_yy -+, ap; t) solves the backward and forward diffusion
equations (the Fokker-Planck equation). We state and prove this
rigorously in Theorem 4, for first order equations.

THEOREM 4. Let d(a — b) be the delta function and let P(b; a; S+;
S) mean the limit as T approaches S from above. Suppose m(T, x)
satisfies the conditions of Theorem 2, and m(T,x) < K(1 + x?)'?
where K is a positive constant. Suppose also that

p(t, ®) = gm, + M, — m’
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18 uniformly Holder continuous and bounded from below. Then it
follows that the differential equations

aZ

9 . e T 0 _
@h TP T; S)] + M(S, ) P] + 2 {P] = 0
Pb;a; S+;8)=14fa=<bd
=0¢fa>>b
R R 0 n_ 19 p—
(4.2) [Pﬁ(b,a,T,S)]ﬂL%[M(T,b)P] %abz[P]—O

P(b;a; S*; S) = d(a — b)
have well defined solutions. If
4.3) P(a;b; T; S)
= | E@T); 0 exp| | o, venat — mT; () P exp 25,001,
it follows that P solves (4.1), and if

@ PoaT;S) = | exo| | pt, uenatiPuw | w(T) = b

x exp [M(T, b) — M (S, a)]
X 2n(T — S))"exp[— 1/2(T — S))(b — a)*]

then it follows that P’ solves (4.2).

P, (y|y(t) =b) is Wiener measure (probability) conditioned on
Yy(S) = a,y(T) =b.

Proof. It will first be shown that

%[P(b; a; T; S)] = P'(b; a; T; S) where P’ is defined by (4.4) .
P'(b; a; T; §) = lim [P + b, a; T; S) — P(b; 0 T S)]%
—0

= lim —{exp [ | p(t, v(tnat — M(T, u(T) |

X H(y(T); b + h) — H(y(T); b))dP,(y) exp [M(S, a)] .

Since lim %_SH(y(T); b+ h) — H(y(T); b))dP,(v)

= lim (22(T — S))—wg:“‘exp [— (/2T — S))u — a)ldu

= (2n(T — S))y""exp[— (V2T — S))(b — a)],
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it follows that 6/0b|P] = P’ as was to be shown.

From Doob [3] Chap. VI, § 3 and the assumption of this theorem,
it follows that process «(t), defined by (2.1) and our conventions, is a
Markov process and that the following limits exist and have the indi-
cated values.

(4.5) lim -}%—S[x(S 4 1) — 2(S)])dP.(x) = m(S, a)

(4.6) lim %S[x(s 4 h) — a(S)FdP(x) = 1,

and that

(4.7) P12 (T) — 2(S)| > ¢) = ofT — S) . (any ¢ > 0)

From [9] Theorem 1, it follows that P’ has sufficient derivatives
for (4.2) to make sense; from [6] and the above, it then follows that
P’ solves (4.2) except for (possibly) the initial conditions. Since P’
has sufficient derivatives for (4.2) to make sense, it can be seen that
P has sufficient derivatives for (4.1) to make sense and thus from
[6] and the above, again it follows that P solves (4.1) except for
(possibly) the initial conditions. The initial conditions for both (4.1)
and (4.2) follow easily from (4.7). This shows Theorem 4.

The integral in (4.4) is, of course, very close to the Feynman
integral of quantum mechanics; and, by way of Theorem 4, one is led
to a rather interesting physical interpretation of the Schrodinger
equation.

We now take a slightly different direction and note that U(¢, S, a)=
E(y(t) = Sy(t)dP,(y) has a physical interpretation as the expected
position of a particle moving in one dimension at time ¢ which, at
time S, was at a. 0/0t[U(¢, S, a)]|;=s then has a physical interpreta-
tion as the excepted velocity of the particle at time S given the posi-
tion of time S is a. It is interesting that this expression solves an
equation similar to the one-dimensional Navier-Stokes equation. This
fact will be shown in Theorem 5.

THEOREM 5'. Suppose m(T, x) satisfies the conditions of Theorem
4 and m,(t, x) exists and 1is continuous and let

(9 U(T,t,5,0) = By()
= {y) exp| | o, yndu — (T, y(1) |ePow) exp 11(5, )]

1 Professor M. Donsker has shown that a ratio of Wiener integrals similar to
(4.9) satisfies (4.10). Professor Donsker, however, used a different method of proof.
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then
lilm /¢t — SHHU(T, ¢, S,a) — U(T, S, S, a)]
tlS
exists, and if

VAT, 8, ) = lim1j¢t — SHU(T, ¢, S, @) — U(T, 8, S, a)]

V satisfies the equation,
(4'10) - VS + VVa = —pz(ay S) + %Vaa

with terminal condition V(T, T, a) = m(T, a). The term exp [M(S, a)]
may be expressed as

@.11) expM(S, a)] = 1| exp| |"n(t, wenat — M(T, (7)) |iPutw) -

Proof. From (4.5), it follows immediately that the indicated limit
exists and that V(T, S,a) = m(S, a), and therefore V(T,T,a) = m(T, a).
But M(T, a) is defined as

M(T, a) = Som( T, wydu
and p(S, a) is defined as
(S, a) = im,(S, a) + M(S, a) — $m*(S, a)
and thus
DS, @) = $m4o(8, @) + my(S, a) — m(S, a)m,(S, a) .

(4.10) thus follows immediately. (4.11) follows from the relation-
ship

1= P(e,a,T,S) = exp [S:mt, y(t)dt

~ M(T, y(T) |P.(v) exp [M(S, )]

Theorem 5 shows that the solution to (4.10) may be expressed in
terms of Wiener integrals, if it is known that the solution to (4.10)
exists and has certain properties. The fact that the solution for
earlier times is given in terms of later times and that the sign of Vi
is minus may be fixed by reversing the direction of the Wiener paths.

More details and applications of the theory presented here will
be given in a later work.
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