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1. Introduction

The fundamental equations governing the basic laws of physics, the Newton and the
Schrédinger equations, are time reversible and have no dissipation. It is remarkable
that dissipation is nevertheless ubiquitous in nature, so that almost all macroscopic
phenomenological equations are dissipative. The oldest such example is perhaps the
equation of heat conductance found by Fourier.

On a microscopic level, Brown observed almost two centuries ago that the motion
of a pollen suspended in water was erratic [6], [7]. This led to the kinetic explanation
by Einstein in 1905 [15] that such a motion was created by the constant “kicks” on
the relatively heavy pollen by the light water molecules. It should be noted that at
that time even the atomic-molecular structure of matter was not universally accepted.
Einstein’s theory was strongly supported by Boltzmann’s kinetic theory, which, however,
was phenomenological and seriously debated at the time. Finally in 1908 Perrin [43]
experimentally verified Einstein’s theory and used it, among others, to give a precise
estimate on the Avogadro number. These experiments gave the strongest evidence for
atoms and molecules at that time.

In Einstein’s kinetic theory both the heavy particle (the pollen) and the light par-

ticles (the water molecules) obey Newton’s law. Therefore, Einstein’s kinetic theory in
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fact postulated the emergence of the Brownian motion from a classical non-dissipative re-
versible dynamics. The key difficulty of a mathematically rigorous derivation of Brownian
motion from reversible dynamics is similar to the justification of Boltzmann’s molecular
chaos assumption (Stofizahlansatz); the dissipative character emerges only in a scaling
limit, as the number of degrees of freedom goes to infinity.

The first mathematical definition of the Brownian motion was given in 1923 by
Wiener, who constructed the Brownian motion as a scaling limit of random walks. This
construction was built upon a stochastic microscopic dynamics which by itself is dissipa-
tive. The derivation of the Brownian motion from a time-reversible Hamiltonian system,
however, was not seriously considered until more than half a century later. Kesten and
Papanicolaou [36] in 1978 proved that the velocity distribution of a particle moving in an
environment consisting of random scatterers (i.e., Lorentz gas with random scatterers)
converges to a Brownian motion in a weak coupling limit for d>3. In this model the bath
of light particles is replaced with random static impurities. The same result was obtained
later in d=2 dimensions by Diirr, Goldstein and Lebowitz [14]. In a recent work [39],
Komorowski and Ryzhik have controlled the same evolution on a longer time scale and
proved the convergence to Brownian motion of the position process as well. Bunimovich
and Sinai [10] proved the convergence of the periodic Lorentz gas with a hard core inter-
action to a Brownian motion in 1980. In this model the only source of randomness is the
distribution of the initial condition. Finally, Diirr, Goldstein and Lebowitz [13] proved
that the velocity process of a heavy particle in a light ideal gas, which is a model with a
dynamical environment, converges to the Ornstein—Uhlenbeck process.

Wiener’s construction of Brownian motion is based on a random walk. The random
walk could easily be replaced by the Markovian process generated by a linear Boltz-
mann equation. The linear Boltzmann equation was rigorously derived from the classical
Lorentz gas by Gallavotti [31], Spohn [49] and Boldrighini, Bunimovich and Sinai [4].
(The non-linear Boltzmann equation was derived by Lanford [40] for short time.) Al-
though Brownian motion was discovered and theorized in the context of classical dynam-
ics, we shall prove that it also describes the motion of a quantum particle in a random
environment.

The random Schrodinger equation, or the quantum Lorentz model, is given by the

evolution equation:
i0pi(x) = Hipy(x), H=Hy,=—30,+AV, (), (1.1)

where A is the coupling constant and V,, is the random potential. The first scale with
a non-trivial limiting dynamics is the weak coupling limit, A—0, where the space, time
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and the coupling constant are subject to the kinetic scaling:
t—te ™, z—axe !, A=,/ (1.2)

Under this limit, the appropriately rescaled Wigner distribution (see (2.11)) of the solu-
tion to the Schrodinger evolution (1.1) converges weakly to a linear Boltzmann equation.
This was first established by Spohn [48] for a random potential with Gaussian distri-
bution and small macroscopic time. This method was extended to study higher-order
correlations in [35]. A different method (applicable to the lattice setting and general
random potentials, see remarks later on) was developed in [20] where the short time
restriction was removed. This method was also extended to the phonon case [16] and
Lukkarinen and Spohn [42] have employed a similar technique for studying the energy
transport in a harmonic crystal with weakly perturbed random masses.

Since the long time limit of a Boltzmann equation is a heat equation, we shall take a
time scale longer (see (2.17)) than in the kinetic scaling limit (1.2). Our aim is to prove
that the limiting dynamics of the Schrédinger evolution in a random potential under
this scaling is governed by a heat equation. This requires to control the Schréodinger
dynamics up to a time scale A™27%, 3>0. Quantum correlations that are small on the
kinetic scale and are neglected in the first limit may contribute on the longer time scale.
The derivation of the heat equation is thus much more difficult than first deriving the
Boltzmann equation from Schrédinger dynamics on the kinetic scale and then showing
that the Boltzmann equation converges to a diffusive equation under a different limiting
procedure. Notice that the limit in our approach is a long time scaling limit which
involves no semiclassical limit.

The approach of this paper also applies to lattice models and yields a derivation of
Brownian motion from the Anderson model [17], [18] and in fact, we present our main
technical steps in a unified framework. The dynamics of the Anderson model was pos-
tulated by Anderson [3] to be localized for large coupling constants A and extended for
small coupling constants (away from the band edges and in dimension d>3). The local-
ization conjecture was first established rigorously by Goldsheid, Molchanov and Pastur
[34] in one dimension, by Frohlich-Spencer [30], and later by Aizenman-Molchanov [1]
in several dimensions, and many other works have since contributed to this field. The
progress for the extended state conjecture, however, has been limited. It was proved by
Klein [38] that all eigenfuctions are extended on the Bethe lattice (see also [2] and [29]).
In Euclidean space, Schlag, Shubin and Wolff [46] proved that the eigenfunctions cannot
be localized in a region smaller than A~=2%9 for some §>0 in d=2. Chen [11], partly
based on the method [20], extended this result to all dimensions d>2 and =0 (with log-
arithmic corrections). Extended states for the Schrodinger equation with a sufficiently
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decaying random potential were proven by Rodnianski and Schlag [44] and Bourgain [5]
(see also [12]).

In summary, all known results for the Anderson model (or its modifications) in
Euclidean space are in regions where the dynamics have either no effective collision or
there are typically only finitely many of them. Under the diffusive scaling of this paper,
see (2.17), the number of effective scatterings is a negative fractional power of the scaling
parameter. In particular, it goes to infinity in the scaling limit, as should be the case if
we aim to obtain a Brownian motion. As in [11], one may derive from our dynamical
result that the eigenfunctions cannot be localized in a region smaller than A~27%/2 in
dimension d>3.

Acknowledgement. The authors are grateful for the financial support and hospitality
of the Erwin Schrodinger Institut, Vienna, Max Planck Institut, Leipzig, Stanford Uni-
versity and Harvard University, where part of this work has been done. We thank Jani
Lukkarinen for pointing out a simplification of Lemma 6.1 for the continuum model and
we also thank the referee for his comments and suggestions.

2. Statement of the main result
2.1. Notation

Let

h2
H.=——-2A 2.1
2 +AV (2.1)

denote a random Schrédinger operator acting on L?(R%), d>3, with a random potential
V=V, (x) and a small positive coupling constant A\. We shall choose the units so that
h=1 and m=1, and thus h%/2m=[2(27)?]~!. The potential is given by

Vi () := RdB(m—y) dpe(y), (2.2)
where B is a single site potential profile and p, is a Poisson point process on R?
with homogeneous unit density and with independent, identically distributed (i.i.d.)
random masses. More precisely, for almost all realizations w, it consists of a count-
able, locally finite collection of points {y,(w)€R%:y=1,2,...}, and random weights
{vy(w)eR:y=1,2,... } such that the random measure is given by

[l = Z Uy (W)3y () (2.3)
y=1
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where d, denotes the Dirac mass at y€ R?. The Poisson process {y,(w)} is independent
of the weights {v,(w)}. The weights are real i.i.d. random variables with distribution P,

and with moments mk::Evv’; satisfying
mo=1, mog<oo and my=mg=ms5=0. (2.4)

The expectation with respect to the random process {y,, v} is denoted by E.
For the single-site potential, we assume that B is a spherically symmetric Schwartz

function with 0 in the support of its Fourier transform, i.e.

~

0 € supp(B). (2.5)

More precisely, we introduce the norm

1F =Y )™ 0% f (@)oo

la|<n
with (z):=(1+22)"/2 (here a is a multi-index) and we assume that
|Bllsx <Ci for all keN. (2.6)

Actually, it is sufficient to assume (2.6) for all k<ko(s).

We note that the operator H,, is not bounded from below due to the possible large
concentration of Poisson points in some region. Nevertheless, H,, is self-adjoint under
very general conditions, see [37].

We introduce a few notational conventions. The letters z, y and z will always denote
configuration space variables, while p, ¢, r, u, v and w will be reserved for d-dimensional
momentum variables. The norm without indices, || ||, will always denote the standard
L?(R%)-norm. The bracket (-,-) denotes the standard scalar product on L?(R?) and
(-, -) will denote the pairing between the Schwartz space and its dual on the phase space
R4 xRY.

Integrals without explicit domains will always denote integration over R¢ with re-
spect to the Lebesgue measure. For any f€L?(R?), the Fourier transform is given by

f(p)::/Rd exp(—2mip-x) f(x) dx, peRY, (2.7)

and the inverse Fourier transform is given by

g(x)= / §(p) exp(2rip-a) dp, zE€R.
Rd
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For functions defined on the phase space, f(x,v), the Fourier transform will always be

taken only in the space variable, i.e.

fev)i= [ exp(-2mig-a) (o, 0)do, e
Rd
The Fourier transform of the kinetic energy operator is given by
2N

[_Qm A f] (p) = [_Q;;Af} () =)/ (),

where
e(p) :=3p° (2.8)
is the dispersion law. The velocity is given by

1

1
%Ve(p) = %P

We note that the additional #%/m=(2r)~2 factor was erroneously omitted in the defini-
tion of the Hamiltonian in [19, (1.2)].
Define the Wigner transform of a function € L?(R?) as

W (z,v) = /R exp(?wiv~n)w<x+;’)w(:ﬂg> d. (2.9)

The Fourier transform of Wy,(z,v) in the x variable is therefore

Wy(&,v) =$<v—§>$(v+§). (2.10)
Define the rescaled Wigner distribution as
€ —d X
Wi(X, V)= "W, ;,V . (2.11)

Its Fourier transform in X is given by

= AT
Ww(f,V)—dJ(VZ)zZ;(VJrZ).

For any function h: R*—C and energy value e>0 we introduce the notation

[h](e) ::/Rd h(v)§(e—e(v))dv::/Z h(q)éye(((;))', (2.12)
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where dr(q) is the restriction of the Lebesgue measure onto the energy surface

Y= {q : e(q) = 6},

that is the ball of radius v/2e. More explicitly,
[h](e) := (2e)%/271 / h(V2e ¢) dp.
Gd—1

Clearly .
/Rd h(v) dv:/o [h](e) de. (2.13)

The normalization of the measure [-](e) is given by
[1](e) :=cq_1(2e)¥271, (2.14)

where cg_1 is the volume of the unit sphere S¢~1.

2.2. Main theorem

The weak coupling limit is defined by the following scaling:

t==— == =)\2. 2.15
=T, e (2.15)

The Wigner distribution WiT/E(X ,V)) converges weakly to a function Fr(X,V) that

satisfies the Boltzmann equation

OrFr(X,V)+V -VaFr(X,V)

N (2.16)
—or /R \BU—-V)[28(e(U) —e(V))[E7(X,U)— Fr(X, V)] dU.

Note that the Boltzmann equation can be viewed as the generator of a Markovian semi-
group on phase space. The proof of (2.16) for the continuum Gaussian model was given
in [20]; the Z? lattice case with general i.i.d. random potential was considered in [11]. The
derivation of the Boltzmann equation for potential (2.2) follows from these two proofs in
a straightforward way.

In this paper we consider the long time scaling

X
t=A"*(\T2T), =X\ 72X)= — &= N\#/2+2 (2.17)

with some s»>0. This scaling corresponds to the long time limit of the Boltzmann

equation with diffusive scaling.
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For some energy e>0, let

L.f(v):= /Rd o(u,v)[f(u)—f(v)]du, e(v)=e, (2.18)
be the generator of the momentum jump process v(t) on ¥, with collision kernel
o (u,v) := 27| B(u—v)[28(e(u)—e(v)). (2.19)

Notice that we use u, v, etc. to denote the momenta; the corresponding velocities are
u/2m, v/27, ete.
A well-known argument shows that B#0 and the regularity of B guarantees the

following properties. Some details will be given in [19].

LEMMA 2.1. For each e>0 the Markov process {v(t) }1>0 with generator L. is uni-
formly exponentially mixzing. The unique invariant measure is the uniform distribution,
[-1(e)/[1](e), on the energy surface X..

Let
1 e .
Dhj(e);:w/o E L™ ()P (0)]dt, v=(vD,..,0 D), hi=1,2,..,4d,

be the velocity autocorrelation matrix, where £. denotes the expectation with respect
to this Markov process in equilibrium. By the spherical symmetry of B and e(U), the

autocorrelation matrix is constant times the identity:
1 o0
Dh]'(e) = Deéhj, De = W ‘/O ge [’U(t) ’U(O)] dt. (220)
The main result of the paper is the following theorem.

THEOREM 2.2. Let d>3 and vo€ L?(RY) be a normalized initial wave function. Let

Y (t):=exp(—itH )Yy solve the Schrédinger equation (1.1). Let O(z,v) be a Schwartz

function on Rx R4, For almost all energies ¢>0, [|1ho(v)|2](e) is finite and let f be the
solution to the heat equation

an(T‘7 X, e)ZDeAxf(T, X,e) (221)

with the initial condition

F(0,X, €)= 8(X)[[¢ho(v) ] (e)
for these energies. Then there exist 0<s¢y(d)<2 such that for 0<sc<s¢(d) and for €
and X related by (2.17), the rescaled Wigner distribution satisfies
lim/ O(X, v)EW( w2y (X, v) dv dX:/ OX,v)f(T, X, e(v))dvdX,
A=0 Jga JRra R¢ /R4
(2.22)

and the limit is uniform on T €0, Ty] with any fixed Ty. In d=3 one can choose



QUANTUM DIFFUSION OF THE RANDOM SCHRODINGER EVOLUTION 219

Remark 1. The coefficient [|7:/1\0(11)|2](e) in the initial condition f(0, X, e) is finite for
almost all e by using (2.13) for h=|t|2.

Remark 2. The total cross section of the collision process (2.18),
oo(e) ::/ o(u,v)du, e=e(v), (2.23)
Rd

is a function of e=e(v) only. Assuming g(O)#O, we see that og(e)~[1](e) for small e,
and og(e)~e~1/? for large e. It follows from Lemma 2.1 and from standard probabil-
ity arguments that the diffusion constant (2.20) scales as D.~e/og(e) for small e<1
and D.~e?/og(e) for large ex>1. If B vanishes at 0 (but (2.5) still holds), then the
small energy behaviour of og(e) and D, depend on the rate of vanishing of Bat0Oina

straighforward way.

Remark 3. The condition (2.5) is not essential, but the theorem needs to be modified
if B vanishes on D(0,d), a ball of radius §>0 about the origin. Let §>0 be the maximal
radius so that D(0, 6)ﬂsupp(§):®. In this case the total cross section og(e) is zero for
all energy values e<d?/8, because the diameter of the energy surface . is smaller than
the minimal range of B. Therefore the evolution is ballistic for the part of the initial
wave function that is supported on energy shells e<§?/8. For the other part of the wave

function the diffusion equation still holds.

Figure 1 below shows the three different scales schematically. On the Schrédinger
scale both time and space are of order 1 in atomic units. On the kinetic scale time and
space are rescaled by A~2. The dynamics is given by the Boltzmann equation character-
ized by finitely many collisions. On the diffusive scale we rescaled the time and space by
an additional factor A\™* and A~*/2, respectively. The typical number of collisions is of
order A2t~ \7%.

If we assume that the Boltzmann equation holds under all scalings, Theorem 2.2 can
be easily understood. From the Boltzmann equation (2.16), the momentum distribution
develops according to the Markovian generator L.. Therefore, the Boltzmann equation
(2.16) describes the process that a particle travels with a fixed momentum v up to an
exponentially distributed random time with average value oq(e(v))™!, then it changes
momentum from v to a new momentum w on the same energy surface ¥. chosen by
the probability distribution P(u)=0(u,v)/o¢(e(v)). The different energy sectors do not
interact. Clearly, this process then converges to a Brownian motion in configuration
space with a diffusion coefficient given by (2.20) and with momentum restricted to a
fixed energy shell 3.

Under the assumption that the Boltzmann equation is valid for all time, this argu-

ment applies in all dimensions. The random Schrédinger evolution, however, is expected
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Diffusive scale: X, T Kinetic scale: X', T Atomic scale: z, t

/
/
/-7
/
/
/

< - - > < - - >
Length: A~27%/2 1
Time: A "27% 1
Heat equation Boltzmann equation Schrédinger equation

Figure 1. Evolution equations on three scales.

to be localized for d<2 even for small coupling constants. Therefore, even though the
Boltzmann approximation was proved to be valid for d>2 [20], [11] (it is not valid for
d=1) in the weak coupling limit, it will not be valid for all time in d=2. Tt is expected
that memory effects and quantum correlations eventually dominate the evolution and
ruin the Markovian character of the Boltzmann picture. Heuristic ideas show that this
transition happens at an exponentially large time (see, e.g., [50]).

The effects of the quantum correlations and memory are not expected to change
the Boltzmann picture drastically in d>3, but one expects corrections to the diffusion
equation and a transition between different energy shells for s>2 (see [41]).

Although Theorem 2.2 is formulated for the Euclidean space, quantum diffusion on
large scales is not restricted to continuum models. In fact, we proved in [18] an analogous
result for the Anderson model where the Hamiltonian (2.1) is defined on ¢2(Z%), d>3.

The kinetic energy is the discrete Laplacian and the random potential is given by

Vo(x):= Z vy 6(z—7), x€Z7 (2.24)
yEZ

where {v,=v,(w):y€Z?} are i.i.d. random variables.
The discrete model is technically more involved for two reasons. First, the dispersion
relation of the lattice Laplacian lacks convexity which simplifies several estimates in the

continuum model. We address this issue in [18].
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Second, our choice of the potential in the continuum model contains more random-
ness than in the discrete one. Comparing (2.2)—(2.3) with (2.24), we note that in the
continuum model both the locations of the obstacles and the coupling constants are ran-
dom variables, while in the Anderson model the locations are deterministic. Formally,
the potential (2.24) corresponds to (2.2)-(2.3) with the deterministic choice y,=~€Z?
and with B(x) being the lattice delta function 6(x). The random choice of the centers
in the continuum model simplifies the formula in the calculation of the high moments of
the random potential. Nevertheless, we will formulate our estimates in a unified setup
that can be applied directly to the Anderson model in [18] as well.

2.3. Strategy of the proof

The above heuristic argument using the Boltzmann equation, besides being misleading
for d=2, also masks the difficulties in proving Theorem 2.2, namely that one has to follow
the full quantum mechanical time evolution through infinitely many collisions. The main
tool of our proof is to use the Duhamel expansion to decompose the wave function
into elementary wave functions characterized by their collision histories. We then apply
two strategies to simplify the expansion: (i) renormalization of the propagator, i.e.,
resumming the two legged subdiagrams; (ii) stopping rules to control recollisions. Apart
from these two steps, the bulk of our proof is devoted to giving sharp estimates for a
large class of Feynman graphs.

To get an idea, imagine that we expand the solution to the Schrodinger equation
by using the Duhamel formula repeatedly. This rewrites the solution into a sum of
elementary wave functions, each of which is characterized by a sequence of collisions with
random obstacles. When we take the expectation of |[¢;||* with respect to a Gaussian
randomness, we pair the random obstacles by Wick’s theorem and obtain a sum of
amplitudes of Feynman graphs. In case of a non-Gaussian randomness the higher-order
cumulants are also present due to various recollision patterns (their contribution turns
out to be negligible, but proving this is rather involved).

If we take only the Laplacian as the free part in the expansion, even the amplitudes
of individual graphs diverge in the limit we consider. However, this can be remedied by
a simple resummation of all two-legged insertions caused by the lowest order self-energy
contribution (it turns out that higher-order corrections to the self-energy do not play a
role in the scaling limit we consider). The resummation is performed by choosing an
appropriate reference Hamiltonian Hj for the expansion. After this rearrangement, all
graphs have a finite amplitude in our scaling limit, and the ladder graphs give the leading

contribution.
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However, we have to estimate not only individual graphs but the sum of all graph
amplitudes, which requires beating down the factorial growth of the number of graphs.
This problem has been addressed in constructive field theory. For field theories with
bosons, the graphical expansion to infinite order diverges. Borel summability was proven
by cluster expansion and renormalization group methods [8], [9], [23], [24], [26], [33].
In fermionic theories, the anticommutation relations entail cancellations which lead to
analyticity in the presence of regulators [21], [25], [32], [45]. Our method to control the
combinatorial growth is completely different: it is by very sharp bounds on the individual
graphs. We give a classification of arbitrary large graphs, based on counting the number
of vertices carrying extra oscillatory effects. The number of these vertices is called the
degree of the graph and it measures the improvement over the standard power counting.
For the ladder graphs, the degree is zero, for the anti-ladder (i.e., complete crossing)
graph, it is 2. For general graphs, the degree is roughly the number of vertices after
removing all ladder and anti-ladder subgraphs. We thus obtain an extra A¢ factor (for
some ¢>0) per non-(anti)ladder vertex. This strong improvement is sufficient to beat
the growth of the combinatorics in the time scale we consider. To our knowledge, nothing
like this has been done in a graphical expansion before. Improved phase space estimates
have been used to prove regularity in two-dimensional many-fermion systems, but the
improvement exponent was fixed independently of the number of vertices [22], [27], [28].

For a comparison, the unperturbed Green functions in the perturbation expansion

for the many-fermion systems and for the random Schrodinger equation are given by

1 1

In the many-fermion case, >0 and po€ Mp={(2n+1)r/B3:n€Z}, where 3~T~! is the
inverse temperature. In the random Schrodinger case, n~t~!. Their L2-properties are
different: dp dp )

ﬂpgA; ne Tipotp2—p? 11870 /Rd PP —atinl? "y’
Notice that the divergence is more severe for the random Schrédinger equation case. In
the many-fermion case, there is one pg-summation per line of the graph; in the random
Schrodinger case there are just two overall a-integrals for graphs with arbitrarily many
lines.

This paper is organized as follows. In §3 we perform the self-energy renormalization,
we smooth out the data and restrict the problem to a finite box. The Duhamel expansion
is introduced in §4. In §5 we reduce the main theorem to Theorems 5.1, 5.2 and 5.3.
The key result is Theorem 5.2, which we prove in the rest of this paper. The other
two theorems are more technical and they are proven in the companion paper [19].
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The Feynman graphs are introduced in §7. In §8 and §9 we reduce all estimates to
Theorem 8.4. This theorem is our main technical bound on Feynman graphs and it is
proven in §10.

Since the random potential in our model is given by general i.i.d. random variables,
the rule for taking the expectation is different from the case of the Gaussian random field
used in [20]. This produces technical difficulties especially for the Anderson model, where,
in addition to the usual pairing from the Wick theorem, we have to introduce higher-
order partitions of the vertices, called non-trivial lumps. Our continuum model avoids
this complication due to the additional randomness of the obstacle centers. Nevertheless,
we present the general proof here so that the key technical results in this paper could
be applied to the Anderson model as well. For readers interested only in the continuum
case, we recommend to ignore the non-trivial lumps.

Universal constants and constants that depend only on the dimension d, on the final
time Ty and on the Schwartz norms ||B||x 5 from (2.6) will be denoted by C' and their

value may vary from line to line.

3. Preparations
3.1. Renormalization

The purpose of this procedure is to include immediate recollisions with the same obstacle
into the propagator itself. This is also called the renormalization of “one-particle propa-
gators” or two-legged subdiagrams. Without renormalization, these graphs individually
are exponentially large (“divergent”), but their sum is finite. Renormalization removes
this instability and the analysis of the resulting Feynman graphs will become simpler.

The self-energy operator is given by the multiplication operator in momentum space

0(p):=0(e(p)), O(a):=lim O (a), O (a):=0.(a,r) (3.1)

e—0+

for any r with e(r)=a, where

[ |B(g—r))dq
O (a,r) = /Rd a—elgtiz (3.2)

Note that by spherical symmetry of B and e(q), ©.(c,r) depends only on |r|, and note
that |r|=+v/2cq, therefore O.(a) in (3.1) is well defined. Clearly 6(p) is spherically sym-
metric. The existence of the limit and related properties of ©® have been proven in [20]

using that || B?||24,24<oc. Here we summarize the results.
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LEMMA 3.1. In d>=3 the following hold:
|Oc(a, 1) —Oc(a, )| < C‘|r|—|r’|‘ (3.3)
(equation (3.80) in [20]) and
|0 (a,7)—Ou (o, 1) S C(le—€'|+|a—a])e /2 (3.4)

if €2¢'>0 (equation (3.68) in [20]). From this latter estimate, the existence of the limit

lim. 04 ©(a, 1) follows. Moreover, © is Hélder continuous:
1©(a)—0(a/)| < Cla—a'[Y/2. (3.5)

Proof. We only have to prove the Holder continuity. For any ¢ and for any r and r’

with a=e(r) and o/ =e(r’) we have
0(a)~6(0)] < _lim [0 (0,r)~O.(a, )| +]6-(a, 1)~ O.(a. 1)
HO2(0,r) =~ 0.(e!, 1)+ Jim [0 (o', ')~ Our(a, )]
< 0(61/2+||r|—\r’|‘—|—|a—o/|<€_1/2).
By optimizing € and using e(r)=c, we obtain (3.5). O
We have the following estimate on 0(p) and similarly on ©(e).

LEMMA 3.2. For any d>3 there exist universal positive constants ¢y, co such that

o log(p) . co log(e)
10(p)| < o 1©(e)| < R (3.6)
ImBO(e) < —1 min{|e|d/271,|e|71/2}, Im6(p) < —c1 min{|p|d72, Ip| '} (3.7)

Proof. By performing the angular integration, we can write ©.(a,p) with e(p)=«

as

o e)¥/2=1 de = 2
@E(a,p)z/o S(e)u, with S(e)::/ |B(V2e (¢p—9))|" d¢,  (3.8)

a—e+tie gd—1
where ¢, is a fixed vector on the unit sphere S?~1. For small values of e,
1S(e)|=0(1) and |VS(e)|=0(e"1/?).
For large values of e, using the regularity of B ,

[S(e)] :O(e*(dfl)/Q) and |VS(e)| :O(e—d/z).
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These estimates, in particular, stand behind the proof that lim. o, O (e, p) is finite,
since they guarantee a sufficient decay for large e and a sufficient smoothness around the
singularity of the denominator in (3.8). The imaginary part therefore is

Im6(p) =Im lim O.(a,p)=—7(20)¥?715(cx),

e—0+

which behaves as ~—|p|?~2 for small p and as ~—|p|~! for large p. The real part of

Oc(a, r) is bounded for small . For large « one splits the integration

a+1 d/2—1
ReO.(a,r)= </ +/ )S(e)w.
a—1 |a—e|>1 a—etie

After Taylor expanding (2¢)%/271S(e) around a1, the first term is bounded by

'(2a)d/2—ls(a) /a+1 de

a1 a—e-tic

2 ((2e)/2-15 )

&

+2 sup =0(a~1?),

le—al<1

/ de clog{a)
< .
ja—elz1 la—ele!/2 = (a)1/?

If we write ©(e)=R(e)—iZ(e), where R(e) and Z(e) are real functions, and recall
that Im(z+i0)~!=—md(z), we have

and the second term by

Z(e)=—ImO(e) =7 Rd5<e(q>—e)\§(q—r)|2dq (3.9)

for any r satisfying e=e(r). O
We rewrite the Hamiltonian as
H=Hy+V,

where
Ho:=w(p):=e(p)+X20(p) and V:=\V—-\20(p). (3.10)

We note that our renormalization is only an approximation of the standard self-consistent

renormalization given by the solution to the equation

B - B(p—q)l*dq_
wip)=e@+Alim | ) (g tie

(3.11)
Due to our truncation procedure, the definition (3.1) is sufficient and is more convenient
for us. Since e(p) is spherically symmetric, so are 8(p) and w(p).

The following lemma collects some estimates on the renormalized propagators that
we shall use to prove Theorem 2.2. The proof is fairly simple and will be given in [19].
We note that formula (2.8) in [19] erroneously contain a factor 2 in the exponent of 7,

the correct bound is (3.14).
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LEMMA 3.3. Suppose that /\22772)\2+4” with »x< Then we have

L
12°

l/ [h(p=a)ldp _ Cllhll2a,0 [log A| log(cr) (3.12)
R

a la—w(p)+inl = (@)12(|q|-/2]a])

and for 0<a<1,

_ —2(1—a)
/ [hp=a)ldp__ _ Callhll2a0 A (3.13)
R

a la—w(p)+inl>=* = (a)2/2(|g|—/2]a[)’
/ p—a)ldp  _ Callhllza0n "=
re la—e(P)+in[>=* = (a)2/2(|q|—+/2]a])

(3.14)

For a=0 and with h:zﬁz, the following more precise estimate holds. There exists a

constant Cy, depending only on finitely many constants Cy from (2.6), such that

At < 1+CoA 2 A+ ]a—w(q)]?). (3.15)

/ N2|B(p—q)|*dp
R |a—w(p)—in|?

3.2. Smoothing the initial data and the potential

In this section we show that it is sufficient to prove the main theorem under the as-
sumptions that @0 (p) is a bounded, smooth, compactly supported function, and B (p) is
supported on {p:|p|<A~%} for any fixed §>0.

The approximation procedure relies on the following L2-continuity property of the

Wigner transform. If a random wave function is decomposed as ¥ =11 +12, then

B0, /VV;>E<@W§1>I<C( /R ) sup|6<5,v>|ds) VE([91[P+ 191 E[lda]P (3.16)

by Schwarz inequality. (Due to a misprint, the |[12]|? term was erroneously omitted in

§2.1 of our earlier paper [20].)

Approximation of the initial data. Let 1ZOEL2 and let @n be a sequence of smooth,
compactly supported functions with |\Jn—$o||—>0. We decompose zZO:anJr(%—zZn).
Then

¥(t) = exp(—itH ) +exp(—it H) (o —n).
Since

|| eXp(_itH)(zz}\O_{b\n)H = H’(ZJ\O_QZnH _>0;

as n— 00, uniformly in ¢, we see that

lim [E(O, Wy ) —E(O, W, ()| =0

n—oo
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uniformly in ¢ (and thus in €), where ,,(t):=exp(—itH )Jn is the time evolution of the
approximated initial data. This means that the approximation procedure is continuous
on the left-hand side of (2.22).

Similarly, on the right-hand side of (2.22), we can define f,, (T, X, e) to be the solution
to (2.21) with initial data f,(0,X,e):=6(X)[|¢n]?](e). Clearly [|th,|?](e) converges to
[[%0]?](e) in L(de). Therefore

(T, X, e) = f(T,X,e) (3.17)

in L'(dX de), uniformly in T. The right-hand side of (2.22) is therefore also continuous
as n—00.

We remark that if ¢ is smooth, e.g. if |Vp1$0 (p)|<C(p)~*9, then a bounded, smooth
and compactly supported approximant, t,, can be chosen so that [|¢n|2](e)—[|20]?](e)
for every e>0, and then the convergence in (3.17) also holds in L'(dX) for any e. The
smoothness of 120 is used only at the point when we explicitly compute the main term of

the perturbation expansion and identify it with the Boltzmann equation, see [19].

Propagation estimate. To verify that a truncation is allowed for E, we first need a
crude propagation estimate. Define the following event for any Z>0:

Q= {w;/ dlpw|(y) < Z(k) for allkezd},
ly—k[<1

where |1,,| denotes the total variation of the (random) measure y,,. For any fixed k€Z9,

let Nj be the number of Poisson points in the ball {x:|z—k|<1}. We compute

EH [ )
ly—k|<1

using (2.4) and the fact that Ny is a Poisson random variable with expectation ENy,

d+1
d+1|, |d+1
<EN o4 < Oy,

which is the volume of the unit ball. By Markov inequality

c Cd —d—1
P(Q%) < Z W:O(z ),
keZd

thus we have
lim P(Q2z)=1. (3.18)

Z—00

We decompose

E(0,W;,) =E[1(22)(0, W5, )] +E[1(2%)(0, W§, )],



228 L. ERDOS, M. SALMHOFER AND H.-T. YAU

where 1(-) is the characteristic function. On the set Qf we use that

B O T3l < ([ swldode ) lud?P@z) o, (319

as Z— o0, uniformly in ¢ (and hence in \).

For weQy we have |V, (x)|<CZ(x), using the decay properties of B. Computing the
time derivative of the mean square displacement, we obtain 0y (s, 221, ) =1i(vs, [H, 22]1by).
Using that [H,2%|=—(V-z+2z-V) and a Schwarz estimate, we have

100 (1, 2°40)| < C (e, @) B+ AW, | Vo 000)] 2 (3.20)
with E:= (¢, Hr)= (100, Htbg), by energy conservation. We estimate
(W, [Vul$) SCZ+CZ (1, )2,

in particular the energy F is bounded (depending on ¢y and Z). From (3.20) we thus
have

(¢t,z2¢t) gcl(Zv wO)t4+02(Za qu)O) (321)
on Qz with some constants ¢;(Z, 1), j=1,2.

Approximation of the potential. We define the truncation of B in Fourier space as
B3 (p):=p(X*(p))B(p), where ¢: R, —[0,1] is a fixed smooth cutoff function with ¢(a)=1
for aé% and ¢(a)=0 for a>1. In position space, we have, for any M €N,

|B(x) =B’ ()| < (z) 7% /Rd (V) [B() 1=\ (p)]]| dp < Cs A (2) 72, (3.22)
by using the fact that B is in the Schwartz space (2.6).
Let

1
H5::*§AI+A/ B (x—y) dps(y)
Rd

be the Hamiltonian with the truncated potential. Let ¢¢:=exp(—itH?)i be the evolu-
tion of the wave function under the modified Hamiltonian H?. On the set Q4 and for
t A4,

Aellhe— 2|1 = —2Tm(yp), (H — HOYopy) < Cs ZAB (3, (22)90) /2 < C(Z, 5,2h0) AP,

by using (3.22) with M=12. In particular, 1; and 9 remain close up to time scale
t~A727% 5<2. This bound, together with the L2-continuity of the Wigner transform
(3.16) guarantees that the truncation of B does not influence the left-hand side of (2.22).
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As for the right-hand side of (2.22), notice that the collision kernel, o(U,V), of
the momentum jump process (2.18) is restricted to the energy surface e(V)=e(U)=e.
Therefore U and V are bounded, depending on e, so B(U—V)=B*(U—V) for these
momenta, if A\ is sufficiently small. Thus, the truncation of B does not influence the
right-hand side of (2.22).

Armed with these results, we assume for the rest of the paper that 1,//1\0 (p) is smooth,
compactly supported, bounded, and that B (p) is supported on {p:|p| <A~} for any fixed
6>0. We thus extend the convention from the end of §2 that general constants denoted
by C' may depend on the truncated versions of B and 120. The same applies to the hidden
constants in the O(-) and o(-) notations.

3.3. Restriction to a finite box

We will reduce the problem to a finite box of size L, L>1, with periodic boundary
conditions. In this way, for technical convenience, we avoid the infinite summation in
(2.3). Let Ap:=[—1L, %L]dCRd be a finite torus and let A% :=(Z/L)% be the dual lattice.

‘We introduce the notation

1
f@)dp= e D f(D). (3.23)
A% | L|p€Az
The integrals f AL and f A+ converge to their infinite volume counterparts as L—oo. Let
L
(+,-)r and || - || denote the scalar product and the norm on L?(Ar).
For any L, M>1 we consider the random Schrédinger operator

M
1
H/:H'L7M::75A+)\VUS, VU:(x)::vayB(x—yfy):/ B(z—y)du.,,

=1 Az

with periodic boundary conditions on Ay and ,u[d::z,]y:l v, 0y . Here {y}y=1,..., M}
are i.i.d. random variables uniformly distributed on Az and {v:y=1,..., M} are i.i.d.
variables distributed according to P, and they are independent of the y'7 The variable M
itself will be random; it is chosen to be an independent Poisson variable with expectation
|AL|. The expectation with respect to the joint measure of {M,y’, v} is denoted by E'.

Sometimes we will use the decomposition

E' =EyEJVESM (3.24)
referring to the expectation of M, {y,} and {v,} separately. The parameter L is implicit
in these notation. In particular, E?M stands for the normalized integral

1

_ dyy ...dyns. 3.25
IALIM Jiapym ' (3.25)
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It is well known that the restriction of the random measure p,, (see (2.3)) to the
box A has the same distribution as p/,. In particular, given a realization w of the
infinite volume random measure p,,, we can associate with it the number of points in
Ap (M=M(w)) and the operator H/,=Hj, p(,) with random measure p/,. We can thus
realize the random operator H/ on the same probability space as H,,. Due to the periodic
boundary and the non-trivial support of B, the potentials of H,, and H/, will not be the
same on Ay, but the difference will be negligible far away from the boundary.

Let x1 be a smooth cutoff function, supported on Az, with x,=1 on Az, and
IVxL|<COL™t. Let ¢ (t):=xr exp(—itH )}y and let ¢’ (t):=exp(—itH'){ be the two
dynamics applied to the cutoff initial data ¢:=xr1o supported on Ay. We also define
the cutoff observable Op:=x;0. Clearly

lim B(OL, Wy, () =E(O, W) (3.26)
for any t. We estimate
Oellvr (&) =i ONL < ClIH = H YL ()L +ClIH, xLlvL ()] (3.27)

The second term is bounded by CL™!||V4(t)| and on Qz it can be estimated by the
total energy as in (3.20). With a propagation estimate similar to (3.21) but applied to
the evolution exp(—itH )|, we easily obtain that the right-hand side of (3.27) vanishes
as L—oo for any ¢. On the complement set, w€2},, we use the uniform bound (3.19)

and finally let Z—o00. In summary, we have shown the following result.
LEMMA 3.4. Let ¢'(t):=exp(—itHy ,/)1g, where M is a Poisson random variable
with mean |Ar|. Then

lim sup |[E(O, Wi(tﬁ ~E'(O, /qu/(t)>L| =0

L—oco

whenever [g,sup, 10(&,v)| dé < 0.

4. The Duhamel expansion

We expand the unitary kernel of H=Hy+V (see (3.10)) by the Duhamel formula. Due
to the restriction to A, we really work with Hj M:H6+X7’ , where the renormalized
free evolution, H|, is given by w(p) in Fourier space and V=2V =220(p), peA;. The
prime indicates the restriction to Ay and the dependence on L and M. In this section

we work on Ay, but we will mostly omit the primes in the notation.
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For any fixed integer N >1,

N-1

qut = eXP(*itHWo = Z ¢n(t)+\pN(t)7 (41)

n=0

with
t ~ ~ ~
P (t) = (—z)"/ exp(—isn+1Ho)V exp(—is, Ho)V ...V exp(—is1 Ho)wo [dsj];-’ill (4.2)
0

being the fully expanded terms and

U (t) = —i /0 exp(—i(t—s)H) Vi1 (s) ds (4.3)

being the non-fully expanded or error term. We used the shorthand notation

t t t n
ds;|"_ ::/ / 5(t— s) dsy ...dsy.
/0[ J]] 1 o o ; J 1

Since each potential V in (4.2) and (4.3) is a summation itself,
_ M
V= —)\20(p)—|—z Vi, Vy(x):=v,B(x—yy),
y=1

both of these terms in (4.2) and (4.3) are actually big summations over so-called elemen-
tary wave functions, which are characterized by their collision history, i.e. by a sequence

of obstacles and, occasionally, by 6(p). Denote by fn, n<oo, the set of sequences

%Z(al,ﬁg,,ﬁn), ,’\}/JJE{LQ,,M}U{ﬁ} (44)
and by W5 the associated potential

W~~{ AVZ, ifye{1,.., M},
Tl =A20(p), ifA=40.

The tilde refers to the fact that the additional {9} symbol is also allowed. An element
ve{l,..., M}U{¥} is identified with the potential W5 and it is called potential label if
Fe{l,..., M}, otherwise it is a ¥-label. A potential label carries a factor A\, a 9¥-label
carries \2.

For any ?Efn we define the following fully expanded wave function with truncation

t
Pyt 5= (—i)"’l/ W5, exp(—is,Ho)W5, _, ... W5, exp(—isiHo)vo [ds;]7—1,  (4.5)
0
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and without truncation

¢
Y5 = (72)"/ exp(—isn+1Ho) W5, exp(—is, Ho)W5, _, ... W5, exp(—is1 Ho)vo [ds]]?ill
0
(4.6)
In the notation, the star () will always refer to truncated functions. Note that

t
Y5 = —i/ exp(—i(t—s)Ho)tss 5 ds.
0

Each term (4.6) along the expansion procedure is characterized by its order n and by a
sequence Y€TI',,. We now identify the main terms.
Denote by I'}"CI'y the set of non-repetitive sequences that contain only potential

labels, i.e.

ZT = {’7: (713 "'af)/k) 5 € {17 ) M}a with Vi #Vj 1fl7éj}

Let
U= ) iy

yerpr
denote the corresponding elementary wave functions.
The typical number of collisions up to time ¢ is of order A\?t. To allow for some room,
we set
K:=|\"°(\%t)], (4.7)

where |- | denotes the integer part and §=09(s)>0 is a small positive number to be fixed

later on. K will serve as an upper threshold for the number of collisions in the expansion.

5. Proof of the main theorem

The proof is divided into three theorems. The first one states that all terms other than
i 0SEk<K, are negligible. For the precise statement we use the previous notation, in
particular we recall that the prime indicates the dependence on L and M.

THEOREM 5.1. (L?-estimate of the error terms) Let t=0O(A"27%) and K be given
by (4.7). If »x<se(d) and 0 is sufficiently small (depending only on ), then

2
lim lim E’ =0.
A—0 L—oo L

K—-1
vi= Y W
k=0

In d=3 dimensions, one can choose o(3)= ;.
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The second key theorem gives an explicit formula for the main terms, @Z)’ nr. It really
identifies the so-called ladder diagram as the only contributing term. We introduce the

notation .
R(a,v)i= ———
n(v) a—w(v)+in

for the renormalized propagator.

THEOREM 5.2. (Only the ladder diagram contributes) Assume that »<2/(33d+36)
and let e=X\*1#/2 t=0(X\"27%) and K be given by (4.7). For a sufficiently small posi-
tive 8, for n=\*** and for any 1<k<K, we have

Jim Ef [0, 57117 = Va(t, k) +O (N3 (E+11d/2)2=00)) (5.1)
lim (Or, E'W, ) = Wa(t,k, O)+O(A/37(611d/2)2-0(9)) (5.2)
L—o0 t,k

as AK1. Here

Wa(t, k) = eXp 2tn //exp )/(Rd)k+1 |7Zo(p1)|2

k+1 k
XHR (o, pj) R (B, 1)) H (Pj+1—pj | dpi ... dpgy1 dadf (5.3)

2t ~ S E—
Wit k, 0) = exp A™ exp(2t) / / exp(i(a—P)t) / / O(€, vies) W5, (£,01)
Rd J (Rd)k+1 0

k+1

XHR (a v+ 5) (ﬁ,vj 65>H|B —v )2 dvy . vy dEdacdB. (5.4)

We adopt the notation O(¢) in the exponent of X\. This always means (constant)d
with universal, explicitly computable positive constants that depend on s and that can
be easily computed from the proof.

The formula (5.3) is the value of the so-called ladder Feynman graph in the dia-
grammatic expansion of E’||); WH2 We will see, in Proposition 7.2, that this expansion
generates k! By, terms, where By, is the number of partitions of a set with k elements (note
that By is almost of order k!). Theorem 5.2 states that only one diagram is relevant; the
contribution of all the other Feynman graphs is negligible even after summation. The
extension of (5.1) to the Wigner transform (5.2) is straightforward. Theorem 5.2 is the
most important step in the proof of the main theorem.

The third theorem identifies the limit of Ef:_ol Wi (t, k, O) as A—0 with the solution
to the heat equation. We note that the definition (5.4) does not apply literally to the

free evolution term k=0; this term is defined separately:

Wi(t, k=0, O)::/Rd /Rd exp(itsv-§)exp(Qt)\zIm@(v))@(g,v)wo(ef,v)dvdf. (5.5)
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THEOREM 5.3. (The ladder diagram converges to the heat equation) Under the

conditions of Theorem 5.2 and setting t=\"2"*T, we have

K-1

lim Z Wi(t, k,O) = . RdO(X (T, X, e(v)) dvdX, (5.6)

where f is the solution to the heat equation (2.21).

Proof of Theorem 2.2 using Theorems 5.1, 5.2 and 5.3. We compute the expecta-
tion of the rescaled Wigner transform, EWf=EW} , tested against a Schwartz function

//O(X,v)EWf(X,v)dvdgz/ / O(&,v)EWE(€,v) dv dé = (O, EW).
R4 JRA RrRd JRd

Combining Lemma 3.4, Theorem 5.1 and the finite box version of the LZ-continuity
of the Wigner transform (3.16), it is sufficient to compute the Wigner transform of
' (t, K): Zk o 27,2’" The Wigner transform Wy, k is quadratic in ¢, so it contains

a double sum over k and k':
<~ £
W (1,16 (6,) Z <v>¢£7§< 2)-

The potential labels are not repeated within ¢ and 1. Moreover, the expectation of a
single potential in (4.6) is zero. Thus the potential labels in the ¢ and ¢ must pair, in

particular taking expectation reduces this double sum to a single sum over k:
1717 T
E'Wym) =) B Wy

By using (5.2) and (5.6) together with K=0O(\~*?), we obtain Theorem 2.2. O

The main result of the present paper is the proof of Theorem 5.2. The proofs
of Theorems 5.1 and 5.3 will be given in the companion paper [19]. For the reader’s
convenience, we summarize below the key ideas of the proof of Theorem 5.1 from [19].

The Duhamel expansion allows for the flexibility that at every new term of the
expansion we perform the separation into elementary waves, 1.5, and we can decide
whether we want to stop (keeping the full propagator as in (4.3)) or to continue to expand
that term further. This decision will depend on the collision history, 4. In particular,
not every error term will be expanded up to the same order N, in some cases we may

decide to stop the expansion earlier.
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To estimate a non-fully expanded term, we will use the unitarity of the full evolution,

2 t
<t [ s s (5.7)
0

¢
H —i/o exp(—i(t—s)H)ib.s 5 ds

Typically we lose a factor of ¢ by using this estimate, since the oscillatory character of
the time integration is lost. We can use this crude estimate only if the fully expanded
term, ||1/J*s,,7||2, is small, i.e. if ¥ represents an atypical collision sequence. Once 7 is
“sufficiently” atypical, we stop the expansion for that elementary wave function to reduce
the number and the complexity of the expanded terms.

There are basically two patterns how a collision history can become atypical; either
the total number of collisions exceeds the typical number of collisions, O(A\%t), or there is
a recollision. This explains why only the non-repetition terms ¢;"; with k<K contribute
to the main term.

A recollision is typically penalized by a factor A? in the weak coupling environ-
ment. This is, however, not the case for the immediate repetition of a potential label,
;i =Yj+1€1{1,..., M}. The renormalization (3.10) compensates for these terms. Up to
the highest order, the contribution of a sequence with an immediate repetition cancels
that of the same sequence where the repetition is replaced by a 6-label. Technically, all
these estimates have to be combined with the key method of the present paper (proof of
Theorem 5.2) to show that the sum of all k!By, repetition diagrams is sufficiently small
to compensate for the unitarity estimate (5.7).

The result of the current paper (Theorem 5.2) has been fundamentally used in [19].
While that paper was already in print, we have improved the possible range of s and
the exponent in the error bounds in Theorem 5.2 (compare with [19, Theorem 2.3]) and,
therefore, several exponents in [19] can be improved. While these improvements are mi-
nor (and the exponents used in [19] are still correct), we list them in the following for
the convenience of the readers. Instead of s<2/(34d+39) required in [19, Theorem 2.3],
the upper bound »<2/(33d+36) is sufficient. The exponent 1 — (fd+12)x—0(6) ap-
pearing in [19, Theorem 2.3] has been improved to % — (64 4-d)>—O(5). Using the
improved exponent in (9.4) instead of &—(4d+2)x—0(5) in [19, (5.18)], the expo-
nent in [19, Proposition 4.6, (4.37)] can be improved to i—(7+%d)x—0(5). The
better estimates on terms (I) and (II) at the end of §4.5 and §4.6 of [19] will lead to
a somewhat better threshold s (d) for . More precisely, the upper bound (4.31) of
[19] is changed to s<(2¢—48)/((33d+36)q+108+472d) and (4.32) of [19] is changed to
#<(29—72)/((33d+36)q+108+72d) after correcting a typo —(16+2d) s to —(16+12d) s
in the exponent of the previous line. In [19, §4.6], the bound (4.40) is changed to
#<2/(18¢+33d+96) and (4.41) is unchanged. These bounds yield an explicit s¢(d)>0
depending on the dimension, so that [19, Theorem 4.1] holds for s <3¢ (d) (the explicit
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upper bound in Theorem 4.1 was a typo, it should have been s<¢(d)). For d=3,
explicitly »(3)> 315.

6. Pairing potential labels

The wave function

Py = (—i) Z / exp(—isp1Hy) VS, exp(—ispHp) ... Vo, exp(—is1 Hy)yy [ds }§+11

"/EF"T

contains k potential terms with different potential labels. Every term in

E' o317 =Y B (G vy

il

has 2k potential terms, and their expectation is

Y71 Y/ /! !/ !/ !
E'VI V), VL VLV LV (6.1)
Since there is no repetition within v and ', and E'V =0, the expectation in (6.1) is
non-zero only if there is a complete pairing between v and +/. Such pairings correspond
to permutations on Ip={1,2,....,k}. We denote by & the set of all permutations on k
elements.

We recall the K-identity from [20, Lemma 3.1] (with a corrected (27)~1 factor):

/(Iﬁexp —iSjw pJ))) [dsg]ﬁii—mx;@/rtexp(—iat)<

k+1

1
jI;[1 a—w(pj)—i-z'n) da
(6.2)

for any 1>0. Therefore, we have

r exp 2t77 5
B2 = 3 / / S(Prss—Brsr)

P P

xE/ Z HV% Pjt+1—D;3)Va,; (Bo(j)+1 = Do) )0 (P 1)¥0(p1)

Y1y Ye=1 =1
"/179‘(]

< [ [ esstita-a(

1 1
- -~ )\ dadBdpdp,
—w(pj)—in ﬁ—w(pj)‘f‘”])

[j=mf
Q

(6.3)
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where the summation runs over all ordered k-tuples (y1,...,7x) of {1,2,..., M} with dis-
tinct elements. We compute the expectation, using mo=1 from (2.4) and the factorization
of E from (3.24):

k
HV p]+1_pj V (pa(j)+1 pa(;)) P(vavf))B(p)B(f))a (64)
with
k ~
=1 Bwj+1-p;) (6.5)
Jj=1
and

M k
P(o,p,p):=EnEJM Y [[expl2miys, (pji1—pi— Bo(yer—Po)))-  (6:6)

Y15 7e=17=1
ViFEYi

We obtain from (6.3) that
E'[[gir (17 =A% E / / 6(Pr+1—DPr+1)
* )k:+1 (Az)k+l

oeSy,

XP(U7P7f’)M (k p, p)w (pl)w()(pl)dpdpv

with

. . exp 2tn Y B(pjs1—p;) B(pjp1—p ))
M (k = ) LRl dad
(k,p,P) / / exp(i )<H () —in B (By) i &4

(6.8)
(with the convention that for j=k+1 we set the superfluous term §(pj+1 —pj):=1).

The expectation value in (6.6) can be easily computed to yield a product of delta
functions since the variables y,, are independent. The constraint ~;#7; induces only a
trivial combinatorial factor that becomes irrelevant in the L— oo limit.

If the obstacle centers were deterministic, i.e., y,,=7;, then the constraint ~;#~;
has more serious consequences. This is the case for the lattice Anderson model, where
the summation in (6.6) extends to all 'ijZd with v;#v; and the momentum variables
are on the dual torus, T%:= [ 5 2] Due to the constraint v;#7;, the formula (6.6) is
not a simple product of delta functions and we have to use a connected graph expansion
that is well known from statistical physics.

Let A, be the set of partitions of I:={1,2,....k}, i.e. A={A,:pcl(A)}cA; if
U,era) Au=1Ir and the elements of A are disjoint and non-empty. The sets in the
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partition are labelled by the index set I(A) and let m(A)=|I(A)| denote the number of
elements in A. The elements of the partition A will be called lumps. A lump is trivial

if it has only one element. The trivial partition, where every lump is trivial, is denoted
by Ao.

LEMMA 6.1. (i) (Continuum model) For any fized L, k and M, with k<M, and

any fized momenta q; €A},

M k
E?S?M Z Hexp(Qﬂ'iqjy%) AL FV—R)! M B! Z H) c(JAy]) (qu), (6.9)

AcA,vel(A €A,

with ¢(1)=1 and ¢(n)=0 for any n>2.
(ii) (Lattice model) For any fized k and momenta q;€T<,

k
S [[ew@rign)=Y T 4 <qu), (6.10)
V1oV €LY J=1 AcA,vel(A) leA,
ViFVj

with

)= 3~y
I'cK,
I" connected

where K, denotes the complete graph on n vertices and |T'| denotes the number of edges

in the subgraph T'. The following estimate holds for n>2:

le(n)] <n" 2 (6.11)

Remark 1. Recall that M is a Poisson random variable with expectation |Ap|.
Therefore, apart from the prefactor that converges to 1 almost surely as L—o0, the
right-hand side of (6.9) is simply H§:1 d(g;). With an obvious choice of ¢(n), we write
it in the same form as (6.10). In this way, the continuum and lattice models can be
treated simultaneously. The explicit form of ¢(n) will not be needed. The arguments in
the sequel will use only the bound (6.11) that is valid for both choices of ¢(n).

Remark 2. Analogous formulas hold if the natural index set I ={1,2,...,k} is re-
placed by an arbitrary finite set .S. In this case, the summation on the right-hand side
of (6.9)-(6.10) is over all partitions of S. The set of these partitions is denoted by A(S).

Proof of Lemma 6.1. Part (i) is straightforward from the definition of E,.
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For part (ii) we use the connected graph expansion

k
[T 0=6ya= > TI o
i#j=1 AcA,vel(A)

where
=c(|Al) H Oy
LI'eA
is the Ursell coefficient of the hard-core lattice gas (see, e.g., [47]). Therefore,

k

Z H exp(2mig;7;)

Visees Y E€LL J=1
Vi Y

- Y ¥ 1 (exp(zmzqm)cuw T 40 )

. REZI ACAL vEI(A leA, Ll'eA,

Z I <4 <ZQZ)- o

AcA,vel(A) leA,

We will use the identity (6.9) to express P in (6.6) as a linear combination of products
of delta functions of the momenta and insert it into (6.7). After the limit L— oo, each
term in the summation ) >, will be expressed by a Feynman graph. The precise

definitions will be given in the next section.

7. Graphical representation

Traditionally, the Feynman graphs consist of interaction vertices and particle lines among
them. In case of Gaussian random potentials, the interaction vertices are paired according
to the Wick theorem [20]. For non-Gaussian randomness, the non-vanishing higher-order
cumulants correspond to joining several vertices [11]. In our case, the appearance of the
non-trivial subsets are due to selecting the non-repetition sequences. This requires us to
define Feynman graphs in a more general setup than usual. In this section we introduce
the necessary graphical representation in full generality and we will define the value of
a Feynman graph, V°(A, o), with permutation o and partition A in (7.21). The final

result of this section is given in Proposition 7.2 at the end.

7.1. Circle graphs and their values

We start with an oriented circle graph with two distinguished vertices, denoted by 0
and 0*. The number of vertices is N. The vertex set is V and the set of oriented edges
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is L(V). For veV we use the notation v—1 and v+1 for the vertex right before and after
v in the circular ordering. We also let e,-=(v—1,v) and e, =(v,v+1) be the edges
right before and after the vertex v, respectively. In particular e, 1)-=e,;. For each
e€L(V), we introduce a momentum w, and a real number «, associated with this edge.
The collection of all momenta is denoted by w={w.:ecL(V)} and dw=@), dw, is the
Lebesgue measure. We sometimes use the notation v~e to indicate that an edge e is
adjacent to a vertex v.
Let P={P,:p€I} be a partition of the set V\{0,0*},

V\{0,0°} = J P,

pel

(with all P, non-empty and pairwise disjoint), where I=I(P) is the index set to label
the sets in the partition. Let m(P):=|I(P)|. The sets P, are called P-lumps or just
lumps. If two elements v, v’ €V\{0,0*} belong to the same lump within a partition P,
we denote it by v=v" (mod P). We assign a variable u, €R?, pe€I(P), to each lump.
We call them auxiliary momenta; they will be needed for a technical reason. We always

assume that the auxiliary momenta add up to zero:

> u,=0. (7.1)

nel(P)

The set of all partitions of the vertex set V\ {0, 0*} is denoted by Py. For any PCV,
we let
L.(P):={(v,v+1)eL(V):ve P and v+1¢ P}

denote the set of edges that go out of P, with respect to the orientation of the circle
graph, and similarly L_(P) denote the set of edges that go into P. We set

L(P):=L.(P)UL_(P).

For any £ €R? we define the following product of delta functions

A(P,w,u);:5<g+ > j:we> 1T 5( > j:we—uu), (7.2)

e€L+({0*}) nel(P)  “eeLi(Py)

where w:={u,:p€I(P)}€R? is a set of auxiliary momenta. The sign + indicates that
the momentum w, is added or subtracted depending whether the edge e is outgoing or
incoming, respectively. The function A(P,w,u)=A.(P,w, u) depends on £, but we will
mostly omit this fact from the notation. All estimates will be uniform in &.
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Summing up all arguments of these delta functions and using (7.1), we see that these
delta functions force the two momenta corresponding to the two edges adjacent to 0 to
differ by &: we—we =€ for ee L, ({0}) and '€ L_({0}).

As a motivation for these definitions, we mention that the lumps naturally arise
from the connected graph formula (Lemma 6.1). According to this formula, the Kirchoff
law must be satisfied for all lumps, i.e. the incoming and outgoing momenta must sum
up to zero. This fact would be described by the delta functions (7.2) with all u,=0. In
certain recollision terms, however, the non-repetition condition leading to Lemma 6.1 is
not fully satisfied and the Kirchoff law breaks down for a few lumps. The non-trivial
auxiliary momenta will bookkeep this deviation from the Kirchoff law (see [19] for more
details). Finally, the shift by £ at the vertex 0* in (7.2) will be used when computing the
Wigner transform in the Fourier representation (2.10).

For each subset GCV\{0,0*}, we define

No(w):=[]lWo(wa)l  TI  1Blwe,. —we, ) [](we, —we,.) 7% (7.3)
e~0 ve(V\{0,0°\G vEG

In our application, the subset G collects those vertices, where the original potential decay
\E(we% —we,, )| could not be explicitly kept along the estimates and this will happen
only at a few places; the size of G will be at most 8. For the purpose of this paper, i.e. for
the proof of Theorem 5.2, we will need only G=&, but for the analysis of the repetition
terms in [19] we need the more general definition.

Due to the support properties of B and 120, we will see that all intermediate momenta

w, satisfy |we|<NA7%. The maximal number of vertices in our graphs will be
2K4+2=0(\"*79),

therefore all intermediate momenta will be smaller than ¢:=A"*"3%. This justifies the
definition of the restricted Lebesgue measures

dp(w) :=1(lw| <) dw, C:= "7 du(w):= ® dp(we). (7.4)

Moreover, each auxiliary momentum u,, will always be a sum (or difference) of different w,
momenta (see (7.2)), therefore each of them always satisfies |u,|<O(A™2*7%%). We will
often take the supremum of all possible auxiliary momenta and sup,, is always considered
subject to this bound.
With this notation, we define, for any P€P), and ¢=0,1,2, ..., the F-value of the
partition:
E,(P,u,a)i= A" sup / L AP, w,wNe(w)du(w).  (7.5)

— A
G:1G1<g ecL(V) |a€_w<w€>+ln‘
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The prefactor ANV ~=2 is due to the fact that in the applications all but the two distinguished
vertices, {0,0*}, will carry a factor A. The E-value depends also on the parameters A
and 7, but we will not specify them in the notation. In the applications, the regulariza-
tion 1 will be mostly chosen as n=A2**.

We will also need a slight modification of these definitions, indicated by a lower star
in the notation:

E.y(P,u,a):=\""? sup / ;A(P,W,U)Ng(w)du(w). (7.6)

Gi161<e ) L oppyy e —wlwe)+in]

e¢L({0*})

The only difference is that the denominators carrying the momenta associated with edges
that are adjacent to 0* are not present in F,.,. We call E,, the truncation of E,. We
will see that Feynman diagrams arising from the perturbation expansion can naturally
be estimated by quantities of the form (7.5) or (7.6).

7.2. Feynman graphs

We apply this general setup to the following situation that we will call Feynman graph.
Every quantity in our perturbation expansion will be expressed by values of Feynman
graphs that are defined below.

For experts we mention that our Feynman graphs differ from those that one typically
obtains after averaging over a Gaussian disorder. In the latter, potential lines never
appear as external lines but only as pairing lines, and one can identify vertices connected
by pairing lines so that the graph becomes 4-valent. In our case, the graph is still
trivalent and has external potential lines, with a corresponding dependence on momentum
variables u. Also, averaging the disorder will not simply pair up lines but can also join
more than two potential lines, which correspond to the higher moments.

Consider the cyclically ordered set V, . :={0,1,2,...,n,0%,7/, nf’:/l, ...,1} and view
this as the vertex set of an oriented circle graph on N=n-+n’+2 vertices. We set

I,:={1,2,..n} and I,:={1,2,... 7},

so that Vn,n/:InUfn/U{O, 0*}.

The set of edges L£(Vn) is partitioned into £(V,, . )=LUL, where £ contains the
edges between I, U{0,0%} and £ contains the edges between I, U{0, 0*}.

Let Py, be the set of all partitions P on the set I,,UI,. The lumps of a partition
containing only one vertex will be called single lumps. The vertices 0 and 0* are not
part of the partitions, hence they will not be considered as single lumps. Let G=G(P)
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be the set of edges that go into a single lump and let g(P):=|G(P)| be its cardinality.
In case n=n', we will use the shorter notation V,,=V,, 5, Pn="Pp n, etc. The Feynman
graphs arising from the non-repetition terms will always have n=n’ and no single lumps,
g(P)=0, but the more general definition will be needed for the repetition terms in [19].

We remark that even in [19] we will always have
In—n'|<g(P)<4, n,n <K. (7.7

We also introduce a function @ that will represent the momentum dependence of
the observable. In our estimates, we will always bound @ in supremum norm; no decay
or smoothness will be necessary. We will need extra conditions on the observable only
to evaluate the ladder in the proof of Theorem 5.3 (see [19] for details). Since Q will
always appear linearly in our formulae, we can assume, for convenience, that ||Q] e <1.
General @) can be accommodated by a multiplicative factor ||Q||o in the final estimate
but it will not be carried along the proofs.

We define the following function to collect all potential terms:

Mw):= ] [=0(w)] ] [0 ] B(we —wet1) II Bwe—wesr)
eeLNG ecLNG e€L\G ecL\G
= et0” iﬁg (7.8)

X (Wey, VD (Wey VQ[E(wey  +10ey. )],

with w:={w.:e€LUL}, and recalling that for any e€£(V) the edge e+1 denotes the
edge succeeding e in the circular ordering.

The delta function A(P,w,u=0) ensures that the two momenta adjacent to each
single lump coincide. This holds even for £#£0, recall that 0 and 0* are not considered
as lumps. Therefore the distribution M(w)A(P, w,u=0) is supported on the regime
with |w.|<( for all momenta w,, due to the support properties of 12)\0 and E, and to the
control on the number of terms, n,n' <K (see §7.1). In particular

MW)AP, w,u=0)dw=M(w)A(P,w,u=0)du(w). (7.9)
Using the boundedness of 6 and | (w)|<C(w) =194, we easily obtain that
IM(W)|AP, w,u=0)dw < CIPING(W)A(P, w,u=0) du(w), (7.10)

where G is the set of single lumps and g(P)=|G|, since the delta function also guarantees
that there is no additional decay at the vertices v€G in Ng(w) (the last product in (7.3)

is a constant).
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Let o, BeR, PP, ,r and

V(P, a, B) = At +o(P) /( H aw(we) ( H g w(we) +m) (7.11)

ecl

x AP, w,u=0)M(w) dw.

Due to (7.9), the integration measure could be changed to du(w). The truncated version,
Vi(P,a, B), is defined analogously but the a and 8 denominators that correspond to
e€ L({0*}) are removed.

We set Y:=XA"19 and define

Vio(®):= S5 0 2“7/ / exp(it(a—B)Viy (P, B dadf  (7.12)

and

2
Eyy(P.u :_eXp ”’/ / Eoyy (P u, ) da dp, (7.13)

where ac in E(,),(P, u, @) is defined as a. =« for ec £ and a,:=4 for e€L. The notation
(*) indicates the same formulas with and without truncation. We will call these numbers
the V-value and the E-value of the partition P, or sometimes, of the corresponding
Feynman graph. Strictly speaking, the V-value and the F-value depend on & through
A=A¢. When this dependence is important, we will make it explicit in the notation, e.g.
V=V¢. The V-value depends on the choice of ) as well. When necessary, the notation
Ve(P; Q) will indicate this fact.
Clearly, by using (7.10),

Vi (P) < (CA)®) Ey) (P, u=0), (7.14)

with g=g(P). We will use the notation E(,),(P):=FE,(P,u=0).
As we will see in (6.2), for the graphical representation of the Duhamel expansion

we will really need

. ex 2t
Vi )= "B [ [ explitta )iy (Pt ) da s, (7.15)

that is, a version of V{,)(P) with unrestricted da df3 integrations. (The circle superscript
in V° will refer to the unrestricted version of V.) However, the difference between the
restricted and unrestricted V-values are negligible even when we sum them up over all

partitions.
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LEMMA 7.1. Assuming (7.7) and that n>=X 4% we have

Yo V@)=V (P)| =00 )), (7.16)
PeP, .

The same result holds if Vi, (P) were defined by restricting the «,(-integral to any
domain that contains [-Y,Y]x[-Y,Y].

Proof. First we consider the case n,n’>1. To estimate the difference, we consider
the integration domain where either |a|>Y or |5|>2Y. We assume, for definiteness, that

|| 2Y, and we estimate all a-denominators trivially,

1 C

la—w(we)—in| (@)’

by using the fact that |w(w.)|<3w2+O0(A?)<1Y +0O(A?) on the support of dy(w.). Then
we estimate all but the last S-denominators in (7.11) trivially by n=1(8/Y)~1. Thus, all
w, integrations are trivial except the last one, where we use (3.12). Due to the bounds
|$(w)\, \B(w)KC(w)_lOd, one easily obtains that

(CA) ' +9(P) |log \| log(3)

V(P, o, B)| < ; ;
Ve )| Q)+ (3] Y)W (B)1/2
Therefore, we have
CA)" ' +9(P) Jog \ -
L v@apldnds< Crr 58— opeen)

using (7.7). A similar bound holds for the truncated values, V. Thus
Vi) (P) = Vi, () = O(A° ). (7.17)

Since the total number of partitions, |P, .|, is smaller than (n+n/)"*"", and in our
applications n,n’' <K <A\~ *72° we see that the restriction of the a, 3-integral to any
domain that contains [—Y,Y]x[-Y, Y] has a negligible effect of order O(A3("+7)) even
after summing up all V-values.

If the condition n,n'>1 is not satisfied, say there is only one a-denominator (n=0),
then we will not introduce the auxiliary variable v as in (6.2), because the [ da integral
would be logarithmically divergent after taking the absolute value. In this case, we use

the definition

v (@)= 22O [ exp(ing)v(p.5) a5
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Figure 2. Vertex and edge labels.

with

Vo (P, 3) = At o ®) / ( H [ 5- +m) exp(itw(w))

x AP, w,u=0)M ( 11 dwe>

e€ELUL

directly, instead of V*° given in (7.15). Similar modifications hold for the other cases
(n"=0, n>1 and n’=n=0) as well. In particular, in our expansion (including all the
cases in [19]) only a few such graphs may appear due to the condition |[n—n'|<2. The
estimates leading to (7.16) in these cases are similar but much easier than in the general
case and they are left to the reader (the same estimates were covered in [20] as well,

without the renormalization of the dispersion relation). O

Sometimes we will use a numerical labelling of the edges (see Figure 2). In this case,
we label the edge (j—1,7) by e;, and the edge (7, jf—vl) by e;. At the special vertices
0 and 0%, we denote the edges in the following way: eni1:=(n,0%), enq:=(0",7'),
e1=(0,1) and ej:=(1,0). Therefore, the edge set L=L(V,, »’) is identified with the index
set I41 Ufn/H, and we set

pji=we; and pji=uwe;. (7.18)

This notation will sometimes be used in parallel: the p, p notation is preferred when
distinction is needed between momenta on £ and £ edges, whereas the w notation is

used when no such distinction is necessary. Note that we always have

p1—p1=¢. (7.19)

7.3. Non-repetition Feynman graphs

A partition PeP,, of I,,UI, is called even if for any P,€P we have |PHﬂIn|:|PHﬂI~n|.
In particular, in an even partition there are no single lumps, i.e. G(P)=g.
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Let &, be the set of permutations on I, and let id be the identity permutation.
Note that A€A, and 0€6,, uniquely determine an even partition in P(A,o)€eP,,, by
I(P):=I(A) and P,:=A,Uc(A,).

Conversely, given an even partition PeP,, we can define its projection onto I,,,
A:=n(P)eA,, by I(A):=I(P) and A,:=P,NI,. We let

6,(P):={0€6, :P(n(P),0) =P}

be the set of permutations that are compatible with a given even partition P. In other

words, 0€6,,(P) if for each i€ 1, the pair (¢,0(i)) belongs to the same P-lump. Clearly
e@i= I ()= T 1aw (7.20
n = 5 )'= pl* - :
nel(P) nel(m(A))

‘We will use the notation

V(*)(A,O',Q) = V(*)(P(A,U);Q), (7.21)

and similarly for E(,, and V(*) In the proofs, @ will be omitted. We also introduce

c(A)= [ e(Al). (7.22)
vel(A)
With this notation, we can state the representation of the non-repetition terms as a

summation over Feynman diagrams.

PrOPOSITION 7.2. With Q=1 and £=0 we have

Jim ENii=> > c(AVi(A0,Q=1), (7.23)

ceS, AcA,

and with Qg(v)::@(ﬁ,v) we have

Jim B/ <0L,W¢,m L= > / Vo (A, 0, Qe) d€. (7.24)
o€, AcAy,
Proof. We insert (6.6) and (6.9) into (6.7) and we take the limit as L—o00. We use

the fact that
M!

[AL[F(M—E)!
for any fixed k. We also replace every Riemann sum (3.23) with integrals and we use
that 1%—>1$0. By recalling (7.19) and by choosing Q=1 in the definition (7.8), we obtain
(7.23). The proof of (7.24) is identical. O

| |1
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Figure 3. Ladder graph.

Proof of Theorem 5.2. We will only prove (5.1); the proof of (5.2) is analogous.
Starting with (7.23), we notice that the graph with the trivial partition Ay and with the

identity permutation on I gives the main term in Theorem 5.2, since
Va(t, k) =Vi_o(Ao,id).

This graph is called the ladder graph (Figure 3). All other graphs will be negligible.
We first replace V° by V; the error is negligible by Lemma 7.1. In §8 we then
estimate V (A, o) for the trivial partition A=A, where every lump has one element.
The result is Proposition 8.6. In this case we set V(0):=V(Ag,0). In §9 we treat the
general case A#Ay. The final result of this section is Proposition 9.2. The proof of
both propositions rely on Theorem 8.4, which is the core of our method. Its proof is
given separately in §10. Finally, the proof of Theorem 5.2 follows from Proposition 9.2,
together with (7.23), (7.16) and (6.11). O

We remark that the E- and V-values of the partitions depend on the parameters
At & C, k and g; a fact that is not explicitly included in the notation. In §§8-10 we

will always assume the following relations:
n=Xt* t=\"2T, Tel0,Ty], K=|A"°(\)], k<K, ¢= "3 <8, (7.25)

for a sufficiently small 6 >0 that is independent of A but depends on . All estimates
will be uniform in £ and in T'€[0, Tp]. We mention that for the proof of Theorem 5.2 we

need only g=0, but the more general case is used in [19].

8. Estimates on Feynman graphs without non-trivial lumps

We use the letters p; and pj, j€I,11, for the momenta variables (see the convention at
the end of §7.2) and I(Ag)=1j for the index set of the trivial partition. In the following
sections we always assume that Q=1.

We introduce the restricted version of M* (see (6.8)) as

ox Y Y k+1 Af B(pi1—ps
(i)~ 550 [ [ it T 222522 20 s

(8.1)
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and we also define the trivial estimate of M as

k+1 ’\ =~ _ -
N(k ~ :_ exp 2t77 ( pj+1_pj)| ‘B(pJJrl_pj)‘ ) dods. )
(. p / / L oo =il 1—w@) i) 4% 2

The truncated versions of these quantities, denoted by M., (k,p,p) and N.(k,p,p), are
defined by removing the (k+1)-th « and  denominators from the definitions (8.1) and
(8.2) but keeping all numerators and all other denominators.

From the definitions (7.12), (7.21) and V(0)=V (Ag,0)=V (Ao, 0, Q=1), we obtain

Viey(o) = A2 / / My (k, p, P)A¢ (0, P, Py u=0)30(p1 )P0 (51) dp dp,
(Rd)k+1 (Rd)k+1
(8.3)

o (0,u) = A% / / Neoy (k. p. B)Ae(0, b, B w)do(p)do (1) dp dp,  (8.4)
Rd)k+1 Rd)k+l

with
k
A¢(o,p, P 1) :=0(Pr+1—Pr+1+E) H5 (P11 =11 = Po (1) +1—Po)) —U1)-
=1
Clearly Vi) (0)| < E(s)g—0(0,u=0) for any £ (see (7.14)).

We introduce a convenient notation. For any (k+1)x (k+1) matrix M and for any
vector of momenta p=(p1,...,pk+1), we let Mp denote the following (k+1)-vector of

momenta
k+1 k41
Jj=1 j=1

Furthermore, we introduce the vector v=(v1, ..., vg4+1) as
v i=&4urtus+...+u—y foralll=1,2,....k+1. (8.6)

Note that vi11=& by (7.1).
Given a permutation o€ &y, we define a (k+1) x (k+1) matrix M =M (o) as follows

1, ifo(j—1)<h<a(y),
Myj(o):=4q -1, ifa(j)<h<a(j—1), (8.7)

0, otherwise,

where, by definition, & is the extension of ¢ to a permutation of {0, 1, ..., k+1} by (0):=0
and 6(k+1):=k+1. In particular [Mp]i=p; and [MP|rt+1=Dk+1-
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These momenta equal +p;+.... These momenta equal —p;+-....

Figure 4. Domain of dependencies of the momenta.

It is easy to check that

k+1
A¢(o,p, pow) = [ [ 6(5;— [Mpl;+[Mv];), (8.8)

j=1

in other words, the matrix M encodes the dependence of the p-momenta on the p-
momenta and the v-momenta. This rule is transparent in the graphical representation of
the Feynman graph: the momentum p; appears in those pj,’s which fall into its “domain
of dependence”, i.e. the section between the image of the two endpoints of p;, and the

sign depends on the ordering of these images (Figure 4).

Definition 8.1. A matrix M with entries 0, +1 or —1 is called tower matriz if in
each column the non-zero entries are consecutive and identical. The collection of these

consecutive 1 or —1 entries are called the tower of that column.
By construction, the matrix M (o) is a tower matrix.

PROPOSITION 8.2. For any permutation o €6y, the matriz M (o) is
(i) invertible;

(ii) totally unimodular, i.e. each subdeterminant is 0 or 1.

Proof. The invertibility follows from the fact that p and p play symmetric roles in
(8.8) if v=0 and £=0, in particular M (c)"'=M(c~1). It is easy to prove, by induction

on the size of the matrix, that any tower matrix is totally unimodular. O

The following definition is crucial. It establishes the necessary concepts to measure

the complexity of a permutation.

Definition 8.3. (Valley, peak, slope and ladder) Given a permutation c€&y let
& be its extension. A point (j,0(j)), j€lx={1,2,....,k}, on the graph of o is called
peak if o(j)<min{é(j—1),6(j+1)}, it is called wvalley if o(j)>max{c(j—1),6(j+1)}.
Furthermore, if o(j)—1€{5(j—1),5(5+1)} and (j,0(j)) is not a valley, then the point
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(7,0(5)), j€Ik, is called ladder. Finally, a point (j,0(j)), j€Ix, on the graph of ¢ is
called slope if it is not a peak, a valley or a ladder.

Let I={1,2,...,k+1} denote the set of row indices of M. This set is partitioned into
five disjoint subsets, I=1I,UI,Ul;UI;Uljas, such that lag:={k+1} is the last index,
and hel,, I, I}, I, if (c7(h),h) is a peak, valley, ladder and slope, respectively. The
cardinalities of these sets are denoted by p:=|I,|, v:=|I,|, l:=|I;| and s:=|I|, and, if
necessary, we indicate the dependence on o as p=p(o), etc. We define the degree of the
permutation o as

deg(o):=k—I(0). (8.9)

A maximal collection of consecutive ladder indices, h+1,...,h+b€e€I;, is called a
ladder of length b. The index h is called the top index of a ladder. The bottom index of
a ladder is defined to be h+b or h-+b+1, depending on whether

|67 H(h+b+1)—o (h+b)|#1 or |57 (h+b+1)—o "t (h+Db)| =1,

respectively. The set of bottom and top indices are denoted by I, and I;. Note that
I,c{0,1,....k—1}, I,C{1,2,....,k+1}, and that the top index of a ladder never belongs
to I; and it may be 0. The bottom index is either a ladder, a valley or k+1.

Remarks. (i) The terminology of peak, valley, slope and ladder comes from the
graph of the permutation & drawn in a coordinate system where the axis of the depen-
dent variable, o(j), is oriented downward (see Figure 5). It immediately follows from
the definition of the extension & that the number of peaks and valleys are the same,
p(0)=0(0).

(ii) The non-zero entries in the matrix M (o) follow the same geometric pattern as
the graph: each downward segment of the graph corresponds to a column with a few
consecutive 1’s, upward segments correspond to columns with (—1)’s. On Figure 5 we
also pictured the towers of M (o) drawn inside the graph of o.

(iii) Because our choice of orientation of the vertical axis follows the convention of
labelling rows of a matrix, a peak is a local minimum of j+—o(j). We fix the convention
that the notions “higher” or “lower” for objects related to the vertical axis (e.g. row
indices) always refer to the graphical picture. In particular the “bottom” or the “lowest
element” of a tower is located in the row with the highest index.

Also, a point on the graph of the function j+—o(j) is traditionally denoted by
(j,0(7)), where the first coordinate j runs on the horizontal axis, while in the labelling
of the (h, j)-matrix element Mj,; of a matrix M the first coordinate h labels rows, i.e. it
runs vertically. To avoid confusion, we will always specify whether a double index (h, j)
refers to a point on the graph of ¢ or a matrix element.
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(iv) We note that for the special case of the identity permutation o=id we have
I,=I,=I,=9, and I;={1,2,...,k}. In particular, deg(id)=0 and deg(c)>2 for any per-

mutation o#id.

An example, with k=8, is shown in Figure 5. The matrix corresponding to the

permutation on this figure is the following (zero entries are left empty):

1 1 1
1 2 1
1 3 p
1 -1 1 4 1
M(o):= 1 -1 1 5 s (8.10)
1 -1 1 6 I
1 -1 1 7T v
1 8 s
1/ 9 (last)

The numbers on the right indicate the column indices and the letters show whether it is
peak, slope, valley, ladder or last. In this case I,={3}, I,={7}, I,={5,8}, I,={1, 2, 4,6},
Nast={9}, I;={0,3,5}, I,={2,4, 7} and deg(c)=4. There are three ladders, two of them
of length 1 and one of length 2.

Now we are ready to estimate |V (0)|<Ey=¢(c, u=0). The following theorem shows
that the degree of the permutation, deg(c), measures the size of V(o). The proof is the

key step in our method and it is given in §10.

THEOREM 8.4. Assume (7.25) with %2<2/(649d) and let 0€&y,. Then the E-value

of the graph of the trivial partition with permutation o is estimated by
Sup B4 (0, 1) < C(A/371H3d/2)%=0(8)ydeg(0) 150 3|2 (8.11)
if A1

This theorem is complemented by the following combinatorial lemma.

LEMMA 8.5. Let k<K=0(A"*79), let D>0 be an integer, and let v>x+35. Then

Z A\vdes(@) < O()\D(vf%%)) (8.12)
ceBy
deg(0)>2D

for Ak1.

Since deg(o)>2 if o#id, from Theorem 8.4, Lemma 8.5, g(P)=0 and the estimate
[V (0)|<E4=0(c,u=0), we immediately obtain the following result.



QUANTUM DIFFUSION OF THE RANDOM SCHRODINGER EVOLUTION 253

——t—F—F—F—F—F+—F+—+~

Ladder J
1 -

Ladder
9+

Peak
3 —+
Ladder

4 —

1 Slope j m
6+ o(4)
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7+ 4 P ion in F h
Valley ermutation in Feynman graph.
Slope
i &
9 1
N
a(j) k=8: ) graph of the permutation o

O and @ graph of the permutation &
Figure 5. Graph of a permutation with the towers.

PROPOSITION 8.6. Assuming (7.25) with »x<2/(124-9d), we have

Z |V(O’>| gO()\2/3—(4+3d)z—O(6)) (813)

oeBSy,
o#id

for Ak 1.

Proof of Lemma 8.5. Notice that I(c)=F only if c=id, being l(c) <k—2 for all other
permutations. We shall prove that, for any [,

Ho €&y (o) =1} <2(2k)* . (8.14)
Then (8.12) follows by recalling that k—I(c)=deg(c), that k<K=0(A"*"%) and by
summing up the geometric series

k

Z )\'ydeg(a) <2 Z [2)\y—x—6}m.

ceSy m=D
deg(o)=2D



254 L. ERDOS, M. SALMHOFER AND H.-T. YAU

To prove (8.14), let o be a permutation with m ladders of size by, ...,b, such
that Z;nzl bj=l and b;>1. If we remove these ladder indices, we have k—I indices
in {1,2,....,k}\I[;={h1, ha, ..., h—;}. The permutation ¢ induces a unique permutation
0*€6y_; on the indices of this set by ¢*(j)<o*(j’) if and only if o(h;)<o(h;).

Let I*:={0, hy, ha, ..., hg—;} and set v:=|I*|=k—1+1. Clearly, the top of any ladder
belongs to I'* and each element of I* can be the top of at most one ladder. We assign
the length b; of the ladder to its top and, for simplicity, we assign the value zero to any
other element of I*. Thus we obtain numbers by, ..., b, with 2,5:1 bj=1l and b;>0.

If the permutation ¢* and the numbers by, ..., b, are given, then we have 2 ways to
reconstruct the original permutation o. To see this, first notice that within I* the ladder-
tops are identified by the condition b;>0 and the corresponding ladder in o can emanate
either “to the right” or “to the left” down from its top on the graph of o. Once this
choice is made, the permutation ¢ can be uniquely reconstructed from ¢* by inserting
ladders of given length starting from their tops. Therefore, the number of permutations
0 €6y with [ ladder indices is bounded by

- —1+1
2”(l-ﬁ—l)!H(bl,bQ,...,by):ij:l and prH@”(k—l)!(” + )<2(2k)’“‘l.

j=1 v

This completes the proof of Lemma 8.5. O

9. Estimates on Feynman graphs with non-trivial lumps
In this section we estimate V (A, o) for a general partition A. We start with a definition.

Definition 9.1. (i) Let A€Ay. Set a,:=|A,|, v€I(A), to be the size of the vth
lump. Let

SA):= J 4
vel(A)
a, =2

be the union of the non-trivial lumps. The cardinality of this set, s(A):=|S(A)|, is called
the degree of the partition A.
(ii) Let A€ Ay and 0€&y,. The number

q(A, o) :=max{deg(0), 3s(A)} (9.1)

is called the joint degree of the pair (o, A).

The goal is the following generalization of Proposition 8.6 that includes summations

over non-trivial lumps.
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PROPOSITION 9.2. We assume (7.25). Let D=0 and s>2 be given integers, and let
q:=max{D, +s}. For any »<2/(33d+36) we have
2(k,D,s):= Z Z Sup Fayg(A, 0, 1)[c(A)] < C(AL/3=(0+114/2)2=0()ya g )2,

0E6, AcA, WISS
deg(0) 2D s(A)>s

(9.2)
We recall that for the continuum model non-trivial lumps do not contribute since
¢(A)=0 unless each A, is trivial, |4,|=1. Thus (9.2) can be proved directly from The-
orem 8.4, Lemma 8.5 and Lemma 9.5 below with a somewhat better exponent. After
some preparatory lemmas, we will give a proof of Proposition 9.2 for the general case
that is valid for both the discrete and the continuum models.
The following lemma shows that any even partition P€Pj, can be generated by a
permutation with high degree, depending on the size of non-trivial lumps.

LEMMA 9.3. For any even partition PPy there exists a compatible permutation
6=6(P)e&,(P) such that
deg(6) > %S(?T(P)) (9.3)
COROLLARY 9.4. Given 0€6y, and A€ Ay, we have, for x<2/(6+33d),

sup E(,)(A,0,u) <C|log A2(AY/3=(1+11d/2)2c=0(8) ya(A.0) (9.4)
u

Proof. We define a permutation oc*:=c*(A, o) by
(o if deg(0) > Ls(A),
6(P(A,0)), otherwise.
By Lemma 9.3, we have deg(c*)=¢(A, o). Clearly P(A,0)=P(A,c*); in particular,
E(*)Q(A,U,U)ZE(*)Q(A,U*,11).
We wish to estimate the value of an arbitrary partition A by that of the trivial

partition Ay. We can artificially break up lumps and use the auxiliary momenta to
account for the additional Kirchoff rules. We describe this procedure in full generality
for any circle graph. We will call it Operation I because further similar operations will

be introduced in the companion paper [19].
Operation 1. Breaking up lumps.

Consider a circle graph on N vertices (§7.1). Given a partition of the set V\{0,0*},
P={P,:pcI(P)}ePy, we define a new partition P* by breaking up one of the lumps
into two smaller non-empty lumps. Let P,=P,,UP,» with P,,NP,»=& and

P = {PVI,PVH,PNZMEI(P)\{V}}.

In particular [(P*)=I(P)U{v',v"}\{v} and m(P*)=m(P)+1.
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LEMMA 9.5. With the notation above, we have

E(*)g(P7u7a)</ E(y(P*,u*(r,v), ) dr,
Ir|<N¢
where the new set of momenta w*=u*(r,v) is given by wuj:=u,, for pel(P)\{v},

uy,=u, —r and u),=r. In our estimates we will always have N <2K and then

Sllllp E(*)g(P7 u, a) < ASllllp E(*)g(P*7 u, a)

with A:=[CK(]*=0(\"24#=00)) (see (4.7) and (7.4)).

Proof. The break-up of the lump P, corresponds to

(5( Z j:we—ul,) :/ 5( Z :I:we—u,,—i—r)é( Z j:we—r) dr. (9.5)
ecLs(P,) RT Neer, (P, c€L (P,1)

Note that L(P,)CL(P, )UL(P,~) and, for any edge ec(L(P, )UL(P,~))\L(P,), we in-
serted an extra w.—we in the left-hand side of (9.5). Note that the property (7.1) on
the sum of auxiliary momenta is preserved. The integration in (9.5) can be restricted to
|r| <N, since |w.|<(¢ for all e. O

We return to the proof of Corollary 9.4. We apply the break-up operation until all
lumps become trivial (singlets). This requires not more than s(A) steps, and, by using

Lemma 9.5, we obtain that

Sup E(*)9<Aa 0-*’ u) < AS(A) sup E(*)g(AOa 0*7 u)7
u u

with A:=[CK(]?. Then (9.4) immediately follows from s(A)<2g(A, o) and from Theo-
rem 8.4. This completes the proof of Corollary 9.4. O

Proof of Lemma 9.3. Inequality (9.3) is trivial if the partition has no non-trivial
lumps, i.e. s(7(P))=0, so we may assume that s(7(p))#0. For any 0 €&y we define the

set of internal ladder indices as
I'=I(o):={hecl:|c " (h—1)—6"(h)|=|6 " (h+1)—G"1(h)| =1},

where 7 is the extension of o as before. The indices h—1 and h+1 are called the protectors
of the internal ladder index h€l;. They ensure that the index h is neither the bottom
nor the top index of the ladder.

We first claim that for any 0 €&y, o#id, we have

k=117 (0)] < 2deg (o). (9.6)
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To see this inequality, we first recall the definition of a ladder and its bottom and top
indices from Definition 8.3. Since every ladder has a unique bottom and top index,
which are not internal ladder indices, we see that the sets I}, I, and I are disjoint
subsets of {0,1,...,k+1}. Since I, I;C{1,2,....k}, I,NI}=I,N;=2 and k+1¢1I;, we
obtain that ||+ |I|+|Iy|+ |1y \Ip| <k+1+4-y, where v is the characteristic function of
the event k+1€1y, i.e. v:=|{k+1}N1|. Moreover, |I;|=|I|, thus

(7 |4 2[ D[+ 1o \ Iy | < k4147
Notice that I; CIJU(I;\1,), and k+1¢1;,I,, therefore
LIT [+ o\ Lo | =y = I |+ B | = [TuN Ty | =
From the last two inequalities and from deg(c)=k—I, we obtain that
k1] < 2deg(0)+1—y— L\ Iy | —2|1, N1, < 2deg(o)+1—|L, .

Since o#id, we have |I,|>1, which proves (9.6).
Next we will show that there exists a compatible permutation 6 €& (P),

17 (6)Na(S(A)) =2, (9.7)

where we set A:=n(P) for simplicity. Since S(A)#@, we have I (5)#{1,2,...,k}, ie.
6#id. Combining (9.6) with (9.7) and with the fact that both I} and 6(S(A)) are
subsets of {1,2,...,k}, we obtain (9.3).

To construct & satisfying (9.7), we apply a greedy algorithm. Since P is even, & (P)
is non-empty and we pick oo €&y (P). If (9.7) is not satisfied for og, then some internal
ladder index h is in the image of a non-trivial lump A€ A: h=0o(h’), h'€A. Let j'€ A be
another element of this lump. Flip the permutation oy on these two elements, i.e. define
a new permutation oy such that oq(h'):=00(j")=4, 01(j'):=00(k')=h and o1 (r):=00(r)
for any r#h,j. Clearly 01 €6, (P) and o1(s(A))=00(s(A)). We claim that

17 (01)No1(S(A))| <[ (90) Moo (S(A))], (9-8)

i.e. the total number of internal ladder indices in non-trivial lumps decreased. Continuing
this flipping process for o7 etc., we obtain a permutation & satisfying (9.7).

To see (9.8) we note that, after the flip, the index h is not an internal ladder index
anymore. This is clear if j#h—1,h+1; in this case the points (671(h—1),h—1) and
(67Y(h+1),h+1) have not changed and they would uniquely fix the location of an in-
ternal ladder index in between. The preimage of the index h has moved out from this
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position, oy ' (h)#0y ' (k). The index j however would not become internal ladder, since
o7 t(j)=n"is between oy ' (h—1) and oy *(h+1), but j is not between h—1 and h+41. Tt
is easy to see that the fixed points (67 1(h—1),h—1) and (61 (h+1),h+1) also prevent
any other indices from becoming an internal ladder index after the flip. This could only
be possible if due to the new point (5, '(j),7)=(5, "' (R),7), one of the neighbors of 7,
say j+1, would become an internal ladder index. It is easy to see that then j+41 must be
equal to h—1, and the other protector of the new internal ladder index j+41 must be h.
In this case h—1 was already an internal ladder index before the flip as well, so no new
internal ladder was created.

A similar but simpler argument shows that if j=h—1 or j=h+1, the number of
internal ladder indices also decreases. This completes the proof of Lemma 9.3. O

Proof of Proposition 9.2. Given €6 and A€ A, we recall the definition of the
permutation o*=0*(A, ) defined in the proof of Corollary 9.4. We also note that
s(A)<2deg(c*). Hence

E(k,D,s)< > le(A)] > > sng(*)g(A,U,u).

AcAy o*eSE ceBy
S(A)>s deg(07)>q o™ (A0)=0"

Note that c€&(P(A,c*)), so, by (7.20), the summation over o contributes by a factor
of at most ], a,! and we obtain that

E(k,D,s)< Y > < IT !) sng(*)g(A,g*vu).

o*€6y AcAy vel(A)
deg(0*)2q 2<s(A)<2deg(c*)
We also used the estimate (6.11). By using (9.4) and deg(c*)=¢(A, o), we obtain that
2k, D,s)< Y (CAVIT(HIRm0@)desten) N ( IT « )
o*EG AcAy vel(A)
deg(0*)2q s<s(A)<2deg(0™)
We introduce the notation
Zfay. Zfau and Hfay. Hfay
vel(A) vel(A)

ay 22 ay, 22

First we fix the sizes of the non-trivial lumps a, >2. Given these sizes, the number

of A partitions is bounded by

()C)O) = amra < rar
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Recalling that s(A)=>""a, and s(A)<2deg(c*), we have

Sk, Ds)< Y (RN ST e (9.9)

o*EBGy ay:y* a,<2deg(o*)
deg(0*)2q

with 7<% — (144 d)s. We use the bound a*~2<C*(a—1)!. To estimate the summa-

tion over the a,’s, we use the following inequality. For any fixed m and H, we have

Z H < (H-1)!, (9.10)

where the summation # is over all sequences (a1, ag, ..., a,, ) of positive integers at least 2,

whose sum is H. The proof of (9.10) is easily obtained by induction on m from

H-2 H-2
> (a-1)!(H-a—1)!< Y (H-2)!<(H-1)!,
a=2 a=2

Summing (9.10) over all H<2deg(c*) and all m<1H, we obtain the bound
[T s <2[2deg(o”)]! < (Ck)>4eE)
ay:y.* a,<2deg(o*)

for the a, summation in (9.9), since deg(c*)<k+1 by definition.

In summary, we obtain from (9.9) that

E(k,D,s)< Y (CRAT)IE@),
ccBy
deg(0)>q
Recalling that k=0O(A~*7°%), we can apply Lemma 8.5 with y=7—4(5c+4) as long as
v>3+4. For sufficiently small positive 4, this gives the condition 3<2/(33d+36) in
Proposition 9.2 and the estimate (9.2). O

10. Proof of Theorem 8.4

For any (k+1)x (k-+1) matrix M we set

son=sps [ [0 /Rd)k“ (0)| B+ )] [(p)|[9(01-+1)

k+1 (10.1)

1
" (U o e ) (e dad

The key step in the proof of Theorem 8.4 is the following lemma.
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LEMMA 10.1. Assume that the relations (7.25) hold, that »x<2/(64+9d) and that
0<0(5) is sufficiently small. Then for any o €&y we have

E(M(O’)) < C(A1/37(1+3d/2)x70(6))deg(o)|10g 77|27 (102)

where the matriz M (o) was defined in (8.7) and the degree of the permutation, deg(co),
was defined in (8.9).

From (8.4) and (8.8), clearly
sup By—o (0, 1) < PR by (10.3)
u (2m)?
after integrating out all p; variables in (8.4), and by using that p;=p; —¢. The estimate
(10.2) will then complete the proof of Theorem 8.4 for g=0.

The proof of Theorem 8.4 for other (but finitely many) values of g follows exactly
in the same way. This requires a slight redefinition of B(p) (see (6.5)) in the definition
of E(M) by allowing the factor (p;11—p;)~2¢ instead of E(pjﬂ—pj) at a few places,
exactly as in the definition of Ng (see (7.3)). As we will see along the proof of (10.2), this
change will require using the less precise bound (3.13) with a=0 and h(p—q)=(p—q) 2%,
instead of the more accurate estimate (3.15) at most g times. Each time we lose a constant
factor compared with the proof for g=0. Since g<8, this results only in a constant factor.
Finally, the proof for the truncated E-values requires us to define a truncated version
of E(M), where the last product in (10.1) runs only up to j=k, i.e. the last o and
denominators are not present. It will be clear from the proof of Lemma 10.1 that the
same bound holds for the truncated version of E(M) as well. This completes the proof
of Theorem 8.4.

10.1. Pedagogical detour

The size of the multiple integral in (10.1) heavily depends on the structure of M =M /(o).
Before we go into the algorithm to evaluate this multiple integral, we present two calcu-
lations, that introduce the techniques that we are going to use in the actual proof. The
second calculation also provides the bound (10.2), hence (8.11), for the case of the trivial

permutation, deg(c)=0.

10.1.1. Method I. Pointwise bound

The most straightforward bound on (10.1) estimates all but one of the S-denominators

by L°°-norm:

1 1
sup

< -. 10.4
gpig |B—w([Mp+ul;)+in| ~n (10.4)
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It would be possible to estimate this denominator by CA~2 apart from in a neighborhood
of zero using (3.7), and treat the |p|~0 regime separately. Here we choose the simplest
argument and we do not optimize for the best possible exponent .

We use (10.4) k times to obtain

0= (ST [ [ (T )

y dodp dp(pr+1)
la—w(Prs1) —in] |B—w(Prs1 +iigr1)+in| (Pre1 i)

Here we have used the following bound for any q=(q1, ..., qr+1):

1B(q)| [tho(q1)| < C*{gry) 24, (10.5)

to obtain the decay in pgi1=pik+1+ur+1.- We integrate out p1,po, ..., pr using (3.12),
then we perform the da and df integrals and finally dpj1, to obtain

E(M) < (Cllog A|)* (X~ 1). (10.6)

The estimate (10.6) is off by a factor (A\2np~1)*=(A"%)*, because we did not use the
stronger estimate mentioned after (10.4). We also collected many logarithmic factors and
the constant is not optimal. We note that in the typical term k~A2t~A"*>>1, so even
an error C* may not be affordable. To improve this estimate, for a typical matrix M, we
will not use the pointwise bound (10.4) for all S-denominators. We will carefully select
those B-denominators whose singularities cannot overlap with other singularities, hence
they can be integrated out at a |logn| expense instead of n~!.

Before we explain this algorithm, we show another method to estimate E(M). It
practically estimates E(M) by E(I), i.e. by the ladder graph, that can be computed more
precisely. The same calculation will be important when evaluating embedded ladder

graphs.

10.1.2. Method II. Successive integration scheme for ladder graphs

We separate all but one a- and #-denominators by the Schwarz inequality. We obtain
k+1 » |2
EOD) < sup | / / [ |2H—] 1
(Royws: L a—w(py) —inP

k+1

2 A —q5— 1)| :| dadﬁ
+Po(q1)] H Iﬂ q])+l77|2 la—w(py) —in| |B—w(py+11)+in|
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with the shorthand notation q:=Mp-+u. Because M is an invertible matrix with deter-
minant +1 (Proposition 8.2), the contributions of the two terms in the square bracket
are identical up to exchange of @ and 3. To estimate the first term, we use iteratively

(3.15) and (3.13) (with a=3) to integrate out pji1,pk, ..., p2 (in this order):

B o2
/\2/ P pk).| 5 WPrkt1 < [14+CoA™ 2 A+ |a—w(pr)[ /)], (10.7)
R¢ |0 —w(pry1)—in|

B(pr—pr—1)|? _
AQ/ 1Be=pe-0)I” 1 o =120 1o w(pn) 2] dp
Rd\a—w(pk)—inP[ 0 | (i) 5] dpi (10.8)

< (L+CN T [14CoA™ " (A+a—w(pe—1)['/?)],

etc., with C’::CO(1+01/2||§2||2(1,0). In the last step, we use only (3.13), once for a=0

and once for a=1:

Blpy—p:)[2
AQ/Rd M[HCOA%”(Ma—w(p2)|1/2)] dps < C. (10.9)
ot —

Then we integrate da df and finally dp; to obtain that
E(M) < C(1+CA7122)F|log A\|> < Cllog A2, (10.10)

by using that k<K <A™ 12 ag e <L
We note that this method also gives a robust bound for the truncated E-value, since
the truncation means that Lemma 3.3 is used only k—1 times. Summarizing, we have

proved the following result.

LEMMA 10.2. We assume (7.25) and that <<{5. Then

sup sup E(o,u) < C|log A%, (10.11)
c€ESE u

sup sup F, (o, u) <CN\?|log A% (10.12)
ceG, u

10.2. Choice of the integration variables

Before we start the proof of Lemma 10.1, we explain the main idea. We use a combination
of methods I and II. We will assume in the sequel that o#id. The lemma for the trivial
case o=id has been proven in (10.10).

Note that each factor in the integrand in (10.1) is almost singular on a set of codi-

mension 1 of the form

{(p1s s Prt1, 0, B) :ae=Rew(pj)} or {(p1,...,Pe+1,@,0): f=Rew([Mp+u];)}
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in the high-dimensional space of integration, (R%)¥*1 x R2. The singularities are regular-
ized by n and Imw, and the two regularizations always have the same sign. The matrix
M may enhance the strength of these singularities by forcing these “almost singularity”
sets to overlap. For example, in the ladder diagram with u=0, we have p=p, hence the
singularity sets are pairwise identical if a=/(. Therefore, singularities of quadratic type
necessarily occur. It is expected that this is the only mechanism that creates relevant
overlaps of singularities. Hence, ideally, one would integrate out the ladder momenta
using the precise bound (3.15). This would remove all denominators with indices j€I;
and the remaining integral should be of O(A2(*=1) with possible logarithmic corrections,
i.e. one should gain a factor A\? from each non-ladder index.

However, the singularity sets of the remaining denominators may still intersect on

higher-codimensional manifolds. For example, since

sup / 71 L — du(p) = L

a8 Jri |a—w(p+q)—in| |B—w(p)+in| R

the integration of these two propagators develops an almost-singularity at ¢=0. We
will call such factors point singularities, although they are regularized at a very short
scale 7). After integration, one point singularity is harmless as (|g|+n) "t €Ll (dg); how-
ever, several point singularities may accumulate along the procedure whose simultaneous
integration may lead to further divergences.

These enhancements of singularities are expected to have contributions of lower
order, but their estimate is not easy. Note that every integration variable p; may ap-
pear in many denominators. This interdependence renders the effective L'-estimate of
each integral practically impossible. Schwarz inequality (method II) can remove all cor-
relations between denominators, but the resulting L?-estimate is of the same order as
the main (ladder) term and we would not gain anything from the higher degree of the
permutation o.

The idea is to estimate many, but not all §-denominators in (10.1) in the trivial
way (10.4). These denominators are chosen in such a way that the remaining ones can
be successively integrated out without ever computing an integrand with more than
two propagators and without collecting more than at most one point-singularity factor.
This choice of integration variables are determined from M=M(o) by an algorithmic
procedure that we describe now.

We first recall that M is a tower matrix, and we define b(j) and ¢(j) to be the bottom

and the top of the tower in the jth column, i.e.

b(j) :=max{h: M;; #0} and ¢(j):=min{h:My;#0}.
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We also recall the concepts from Definition 8.3. Any non-peak index he I\, clearly has
the property that h is the bottom of the tower of some column of M, i.e. there exists
j such that b(j)=h. This column index can be either j=5"1(h) or j=6"1(h)+1 or
both; ambiguity occurs only if he€l, is a valley index. For any ladder or slope or last
index, h€ [JUI Ul s, we therefore define ¢(h) to be the unique column index j such that
b(j)=h. For he€ L4, i.e. h=k+1, we always have c¢(k+1)=k+1. If hel,, we define c(h)
to be the index of the column whose tower is higher, i.e.

e(h) = { cz':l(h), if t(&*‘fh)) <t(@='(h)+1),
o t(h)+1, otherwise.

The other column index will be denoted by é(h); this concept is defined only for hel,.
The elements (h, c(h)), h€I\I,, of the matrix M are called pivot elements; these will be
used for determining the integration variables. The ¢(h)-column will be called the pivot
column of h and the corresponding tower in this column is called the pivot tower of h.

The definition guarantees that the pivot tower of an index he I;UI, has at least length 2.

Definition 10.3. Let hi<hs<... denote the elements of I,Ul, in increasing order.
A slope index h,, €1, is called covered if t(c(hy+1))<hy, ie. if the top of the tower of the
next pivot element of a valley or a slope is higher than h,. The remaining slope indices
are called uncovered. The set of covered and uncovered slope indices will be denoted by

I.s and I, respectively.

Figure 6 shows three examples. In the first two cases, the index h, is covered by
a slope and by a valley. The last case is an uncovered slope index. The shaded boxes
indicate the pivot elements.

Apart from the ladder momenta p.;), h€l;, we will integrate out the variables
De(hy)> Pe(ha), -+ > i this order. We will show that, at every integration step, only one

a-denominator and one #-denominator, namely
la=w(pe(n,y)—in|~" and  |B—w(pn,)+inl ",

will contain the integration variable p.(s,), so we will never have to estimate integrals
with more than two propagators.

The significance of the covered slope indices is that their integration step yields a
point singularity that will be integrated out immediately at the next non-ladder inte-
gration step. Therefore covered slope indices do not give rise to accumulation of point
singularities.

The covered slope indices, together with the valley indices and the last index will be
used to gain a A"t factor in the integration procedure. They will not accumulate point
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Pyt

s}

s

Figure 6. Two examples of a covered slope index h;, and one of an uncovered index.

singularities. The uncovered slope indices and the peak indices will be treated by the
trivial L>°-bound (10.4) and no gain is obtained from them. That is, we prefer giving up
the potential gain of a A°°*** factor from the uncovered slope indices to dealing with the
accumulated point singularities. Finally, the ladder indices will be treated by method II
with the Schwarz inequality.

LEMMA 10.4. The number of uncovered slope indices is at most v, where v=|I,| is

the number of valleys.

This lemma ensures that treating the uncovered slope indices by the trivial bound
is affordable (at the expense of a worse ), since each valley will result in a gain of a

Acenst factor.

Proof. First, we state two claims from which we easily deduce the lemma, then we

prove these claims. Recall that the sequence hy <hs<... lists all elements of I,UI.

Claim 1. Let hy, €I, be the first slope index in the sequence hi;<ho<.... Then,
there is a peak index h such that h<h,.

Claim 2. Let h,€l,s be an uncovered slope index and suppose that it is not the
last entry in the sequence h; <ho<..., i.e. there is a next element h,4,€I,Ul,. Then,

there is an intermediate index, h, <h<h,41, that is a peak index.

By Claim 2, one can assign a distinct peak index to every uncovered slope index
h, (but the last one), namely the next peak index. Moreover, by Claim 1, there is an
additional peak index smaller than any uncovered slope index. Therefore, the number
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of uncovered slope indices is at most the number of peaks. The statement of the lemma

then follows, since the number of peaks and valleys is the same, p=v.

Proof of Claim 1. Suppose that the statement is false. First note that h, >2, since
index 1 cannot be a slope. Then all indices 1,2,...,h,—1 must be either ladders or
valleys. But for any valley index j there is obviously a peak index j’<j, since the graph
of the permutation goes down from (0,0) to (k+1,k+1), so, following the two branches
of the graph emanating upwards starting from a valley, at least one of them must run
into a peak that lies higher. Therefore all indices 1,2, ... h, —1 must be ladders and they
form a ladder, with the index 0 being the top of this ladder. In particular, t(c(h))=h—1,
h=1,2,...,h,—1 (recall that t(c(h)) denotes the index of the top row in the pivot tower
of h), so every index 0, 1,2, ..., h,, —2 is the top of a column of length 1. Moreover, none of
these indices can be the top of any other column, since an index which is the top of two
different columns must be a peak index. But in that case there is no room for t(c(h,)),

the top index of the pivot column of h,: since h, was a slope, t(c(h,))<h,—2.

Proof of Claim 2. To see the claim, suppose that none of the indices h strictly
between h,, and h,1 is a peak. These indices cannot be slopes or valleys either, since h,,
and h,1 are two consecutive elements of I, U, and h cannot be the last index, hét Dast,
as h<h,41<k-+1. Therefore all indices h with h,<h<h,41 are ladders.

Now we look at h*=t(c(hy+1)), i-e. the index of the top row in the pivot tower of
hut1 (see the last picture in Figure 6). Since h, was uncovered, h, <h*. Note that the
pivot tower of h,1€I,Ul, has length at least 2, therefore h*<h, 1, and thus h* €.
Since h* was also the top of a tower with length at least 2, h* —1 must be a peak index,
as it is a row index right above the top of two towers (namely the towers in the columns
c(h*) and c(hy41)). Clearly h, <h*—1<h,q1, but h,#h*—1 since h, €I, and h* —1€1,.

Thus h*—1 is a peak index strictly between h, and h,1, which is a contradiction. [

10.3. Integration procedure

Our goal is to estimate (10.1) for M =M (o) when o#id. We start with defining
llgll :=n+min{lgl, 1}, geR™. (10.13)

This is not a norm, but it satisfies the triangle inequality, ||[p+¢ll<|Ipll+]lglll. For
any index set I'CI={1,2,...,k+1}, we define the function U, as the product of those
potential terms, |§|7 in (10.1) that depend only on momenta {p;:j€l’}. More precisely,

Up(p,a):= [ Blojr1—p)) [[ B(IMp+i;11—[Mp+1l;)|,
J J
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where the star indicates a product on a restricted index set. The first product is taken
over all indices j for which j, j+1€I’. The second product is taken over those j for which
M1 p=M;, for all b1’

For any |I’|x (k+1) matrix M and any vector b=(by, ba, ..., by 1) ERF! we define

1
E(I', M, b):=\?* sup/ / sup / Up(p,a)———
ij ggr Jmayr [6-p+ol|

’ <Jle1 |a—w(pj)—in\ s ([Mp1+u +m|> ( g dlps > dovdfs.
(10.14)

Here veR? is an additional dummy momentum and b-p is defined, analogously to (8.5),

as

b-p:=bip1+bopa+...+brr1Prs1.

We will also use the notation E(I', M, @) defined exactly by the same formula as (10.14)
without the factor |[|b-p+wv||~! in the integrand and without the supremum over v. With
a slight abuse of notation we will refer to this case as chosing the “empty vector” b=g2.

For each hel we will define an index set 1™, a matrix M and a vector b
such that E(I™ M®™ (") is the remaining integral after the hth integration step.
Each step consists of eliminating one $-denominator; in the hth step we will eliminate
|B—w([Mp+1])+in|~! and sometimes one or two additional a-denominators. The a-
denominators will always be eliminated by integrating out the corresponding p; variable.
The order of integrations will be such that the integrand in E(I™, M) 5()) does not
depend on any p;¢1 (") In particular, the supremum over all pj¢l () in the definition
(10.14) will be superfluous in the integrals appearing in our iteration.

The elimination will be done differently, depending on the type of the index h. If
hel,, then the trivial L>°-bound (10.4) will be used. If h is an uncovered slope index,
then again the trivial bound will be used, and, additionally, the variable p.;) will be
integrated out. If A is a slope or ladder index, then variable p.(;) will be integrated out.
If h is a valley then we integrate out both variables p.,) and pzp). Finally, in the last
step, h=k+1, we will integrate out the 8 variable. We will bookkeep this integration by
removing the corresponding h rows from M and we will say in short that these rows have
been integrated out. At the end we will have to integrate out the remaining p; variables,
but then only one a-denominator will be present, so the integration can be done easily.

Point singularities are created by integrating out a covered slope index, but there
is never more than one singularity present. An existing point singularity will not be

touched by the ladder integrations, and it will be changed to another point singularity
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when a covered slope index is integrated out. In all other integration steps an existing
point singularity will be removed.

Now we define MM, 1" and 6™, Let M©):=M=M (o), I0:=1={1,2, ..., k+1}
and b(®) =@, In particular, note that

E(M) < [[o]| 2 B, MO, 6(©). (10.15)

For any h>1, define M to be the matrix M =M (o) with the first h rows, with indices
1,2, ..., h removed. For h>1, let

IMW =1\ ({c(W):h' <hand ' € INL,}U{&(h'):h' <h and I’ € I,,})

be the index set of columns that have not been integrated out up to the hth step.

The vectors b(h):(bgh), ...,b,(!fgl) are defined as follows. For any given hel, let hy,
be the largest element in the listing hy <ho<... of I,Ul, (see Definition 10.3) such that
h,<h. If there is no such h, or h,¢I., then we set b =g If hy €1, then

o) { My, 5, if j#c(h),
Jj o

0, if j=c(h). (10.16)

We collect some information about b(® that directly follow from the definition and
from the structure of M.

(i) Suppose that b=z, and let h, be as above (i.e. h,<h and it is the largest
element with this property). Since hy, €I, i.e. t(c(hyy1))<h,, we therefore have

B

Gy =Fl hu<h<hy and by €l (10.17)

(ii) For any fixed p, b is constant as h runs through the interval {h,,, ..., h,1—1}.
(iii) Consider the pivot column ¢(j) of a ladder index j€I;. Since the only non-zero
entry in the c(j) column of M is Mj .(;), we have that M}, .;)=0 for all . But then we

see that the entries corresponding to the ladder pivots are all zero in the b(® vectors:

bg&).) =0 for any j € I; and any h such that b(") #£ &. (10.18)

To describe the integration, we explain how each case, depending on the index type

of h, is estimated. We also introduce the short notation

E(h):=E(IM, M®™ M) h=01,.. k+1.

Case 1. h€l,. In this case no integration is done, 1" =1("=1) and bW =p(h—1),
We estimate |3—w([Mp+1];)+in|~! trivially as in (10.4), and we obtain that

E(h—1)<n'E(h), hel,. (10.19)
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Case 2. hel;. Let h,h+1,...,h+7—1€l; be a ladder, i.e. a maximal sequence
of consecutive ladder indices, i.e. h+7¢1I; for some 7>1. We will integrate out the
whole ladder in this step, so we may assume that h—1 is the top of a ladder, h—1€
I;. By definition of ladder, the pivot indices ¢(h), c(h+1),...,c(h+7—1) are consecutive
numbers, which, for definiteness, are assumed to be increasing (the other case is similar).
Let c=c(h). Because h, ..., h+7—1 are all consecutive ladder indices, [Mp];=p;+w for
all e<j<c+7—1, with a vector w=w(p) that does not depend on {p;:c<j<c+7—1}.
Note that b remains unchanged as k runs through the ladder indices: 6*)=p("=1) for all
k=h,h+1,...,h+7—1. We claim that

E(h—1)<CXN T E(h+7-1), h—-1€I, (10.20)

with a constant C' independent of 7. This inequality entails integrating out the variables
Dey Pet1s s Detr—1 (in this order) to remove the rows h, h+1,...,h+7—1. This requires
estimating the integral
cr—1 A .
T:= sup / H B(pj+1—pj)| |B(pj+1+uj+1 —pj — ;)| .d/i(Pj)
afw (R 2, l—w(p;)—in||B—w(p;+w+iy;)+in|

: (10.21)

because the possible point singularity present in E(I(h_l), MG=1), b(h_l)) does not con-
tain any of the integration variables, by (10.18). Due to the ladder structure, it is easy
to see that Ujwn-1) indeed contains all the B factors shown in (10.21).

After Schwarz inequality, we use an iterative integration scheme similar to (10.7)—

(10.9) to estimate the 7-fold multiple integral

c+‘r'1 ’\

p]-i-l —p])l d,u(pj)
Juwre T

T o=y —inl?

g[ — (1+O)\1712x)]771

E c+17 — Me+17— 2d CTT—
< (14 oA 2% (A ()| /2) E P Loz 1) diler )
R4 |a_w(pc+'rfl)_“7|
< O[ (1+C>\1712%)}771
<C —2(7— 1)

In the last integration we use (3.13) with a=0 and a=1 and we also use the fact that
T<K <A ~(-122) This gives
IT<ONT, (10.22)



270 L. ERDOS, M. SALMHOFER AND H.-T. YAU

Case 3. h€l,. We have IM=T1"=D\{¢(h)} and bW =@. We start proceeding
as in Case 1 by first estimating the denominator |3—w([Mp+1],)+in|~! trivially as in
(10.4). Then observe that the variable p.) appears only in one propagator, namely
in [a—w(peny)—in|~'. Moreover, if b("~V#g, then p.;) appears also in the point
singularity, since bgg)l):il by (10.17).

Before we integrate out p.(s), we estimate all B factors that contain this variable
by the supremum norm. The number of such factors is at most four, so they can be
bounded by a constant factor C. Then, to integrate out p.(;), we either use the bound
(with p=pe(n))

d
sup/ Li(p).gCCd_Q\logm (10.23)
o<y JRe |o—w(p) —in|

if 6"~ =g, or we use the bound

sup sup/ ! dL(p) < C¢2log )| (10.24)
aj<y  Jra lP=7lll ja—w(p)—in|
if 6"~V £g (recall that (=A"*"3 from (7.25)). The bound (10.24) follows immediately
from (A.1) and (A.5), the bound (10.23) is weaker since sup, [[p||<1+n (the bound
(10.23) can be improved to C|logn|, but we will not need this fact). In summary, we
have proved that
E(h—1)<C¢ 2 Ylogn|E(h), h€ L. (10.25)

Case 4. h€l.. In this step we will have I(") =1(=D\{¢(h)}, and b will be the
hth row of M but with the pivot element (h,c(h)) changed to zero, i.e. b =0. Since
the index h is among the listing h1 <ho<... of the elements I,UI; (see Definition 10.3),
let h=h, and h':=h, 1 be the next element of I;UI,. As h is a covered slope index,
we have t(c(h'))<h, and thus we know that the (h,c(h')) matrix element of M is £1.
Therefore the variable p.(;/) appears non-trivially in pj=[Mp+1u]y:

ﬁhz[Mp—l—fl}hZ:Izpc(h):tpc(h/):t... . (10.26)

After estimating those B factors that contain Pe(n) by the supremum norm, we will
integrate out p.n) by using the following lemma proved in the appendix.

LEMMA 10.5. Let A3<n< A2, and let |q|<CA™L. Then we have

1 d Cn—1/2¢4-3|] 2
sup / . 1(p) _Gn ¢ "|logn|* (10.27)
apr SR [P=7lll |a—w(p) —in| [B—w(p+q)+in| lall
Without point singularity, we have the following improved bound:
d d-3]] 2
a8 ) |a—w(p)—in||B—w(p+aq)+in| gl
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The first estimate (10.27) is used if b»~D#£g ie. if there was a non-trivial point
singularity present. By (10.17), this non-trivial point singularity must originate from
the previous covered slope index, in particular h,_; €l and b(? )1) +1, i.e. the point
singularity contains the variable p.(;). The new point singularity, obtained on the right-
hand side of (10.27) as [|g|| !, is exactly the linear combination appearing in (10.26)
without the integration variable, p.(x). Therefore, the p-dependence of this point singu-
larity is given by b(®) (up to an overall sign that is irrelevant, since |||-|| is symmetric).
If b»~Y =g, then we can use the second estimate (10.28), and otherwise we follow the
same argument as in the case b("~1 £,

The net effect of the elimination in Case 4 is

E(h—1)<Cn~Y2¢4 3 logn|2E(R), he . (10.29)

Case 5. h€l,. In this step we will have I" =1"=D\{¢c(h),é(h)} and bW =g
Recall that c(h) and &(h) are the two columns between which the valley is located,
ie. {c(h),e(h)}={a"'(h),67(h)+1}. We integrate out both p.) and ps) after es-
timating the B factors that are involved by their supremum norms. This eliminates
two a-denominators and the |3—w([Mp+1],)+in|~! denominator. It follows from the
definition of the valley index that

[Mp+1]n = £pen) Fren) £

i.e. the B-denominator contains both integration variables. If b(*~1) =g i.e. no point

singularity is present, then the prototype of this integral can be estimated as follows:

d d _
/ / M( ) M( ) / : SCCZd 5|10g77|3,
lal, \ﬂ|<Y Re JR4 Jo—w(p)—in| la—w(p)—in| |B—w(p—p'+q)+in|

assuming that |q|<CA~!. This estimate follows from (10.28) and (10.24).
If a point singularity is present, b(*~D =g we know that bg(L];)l)::tl by (10.17),

therefore at least one of the integration variables appears in it. Depending on whether

é(h) also appears or not, we have one of the following two prototype estimates:

‘ / / dp(p) dp(p')
sup sup -
lallsl<y r Jra Jra |||P Tl fo—w(p) —in| |a—w(p’) —in| |B—w(p—p'+q)+in|
<O ' 2¢%4 % log n|?, (10.30)

or

/ / du(p) du(p')

sup sup _ _

lal8l<y r Jra JRa ”|Pip =7l Ja—w(p)—in| [a—w (') —in| [B—w(p—p +q)+in]
<Cnp V240 log n?, (10.31)
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assuming that |¢| <KCA~!. Both inequalities are obtained by first applying (10.27) for the
dp integral, and then applying (10.24) for the dp’ integral.

In summary, the effect of the elimination in Case 5 is that
E(h—1)<Cn~ Y225 logn|?E(h), hel,. (10.32)

We eliminate the row indices one by one in increasing order according to Cases 1-5.

The total estimate is
E(0) < (n~ YOO 20 log n) = (O~ 1/2¢472 log ) !
x (Cn HIEE(k+1),

where we recall that I; is the set of indices that are tops of a ladder; in particular, Case 2

(10.33)

is applied |I;| times. Since the top of the ladder is not a ladder index and not a valley,
it is a peak, a slope, or maybe 0, thus

|| < ||+ | Is|+1=v+s+1 < 2v+s,
taking into account that p=v and v>1 since o#id. From (10.33) and from the fact that
el | Fus| = | L] = 5
it then follows that
B(0)< O’U+S+1>\f2lnf(3v+s+|[usI)/ch(2U+S)E(k+1) (10.34)

(where we also used that |logn|®<(). Note that the exponent of the constant is compa-
rable with deg(c)=k—I1=2v+s. A factor C! would not be affordable if [>>deg(c); this is
why the ladder integration had to be done essentially with the precise constant by using
(3.15).

Finally, when estimating F(k+1), only the last row of M, h=k+1€ 1,4, is present.
Since k41 is bigger than the largest element of I;UI,, which by Definition 10.3 cannot
be a covered slope index, we see from the definition of b(® that b(™ =g, i.e. there is
no point singularity. Moreover, we have already integrated out ||+ |Is|+2|I,|=1+s+2v
variables. Since p=v and I=1;UI;UIL,Ul,Ul, is a partition, we see that at the last step
there is only one integration variable left, namely pyi1. Considering that the (k+1)-th
row of M contains only one non-trivial entry, and thus [Mp+Q]x+1=pk+1+Ugs1, the
integral from (10.14) is simplified to

E(k+1)=EI*HD A+ plkt))

—\2k sup/ / / dp(pr+1) dadB  (10.35)
Rt |B— pk+1+u)+“7| la—w(prs1)—in|

< CA*¢logn|*.
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Now, combining inequalities (10.15), (10.34) and (10.35), we get that
E(M) < C«v+s+1/\2(lcfl),,]7(31;+5+|L,S|)/2<d(2v+s+1)|10g77|27

where we recall that the general constant C' may depend on 120. Using the choice of
the parameters from (7.25) and the fact that deg(c)=k—1=2v+5>2, we obtain a total

A-power

2(2v+5) — (143 3¢) (Bu+s+|Lus|) — (2+30)d(2v+s+1)
> v+ |Los| —3(143d) (2v+5) — (20+5)O(6),

where we used Lemma 10.4 and that v>1 to estimate
2(Bv+ts+|Iys|) <2v+s and 2v+s+1<2(20+s).
Using Lemma 10.4 again, we see that v+|Ies| >3 (2v+s), i.e. that
E(M) < Cv()\137(1Jr3d/2)x70(5))deg((r)|10g,,7|27

if the exponent is positive, i.e. if 2<2/(649d) and d<d(s) is sufficiently small. This
completes the proof of Lemma 10.1.

Appendix A. Proof of Lemma 10.5

We can replace w(p) with e(p) in (10.27) by using a straightforward resolvent expansion

1 - 1 CN\?|a—e(p)|'/? o C
la—w(p)+in| ~ Ja—A20(a)—e(p)+in| la—w(p)+in| |~ |a—e(p)+in|’

(A1)

with a=a—A?Re ©(a). Here we used the boundedness and the Holder continuity of ©,

see (3.5). Therefore, the proof of Lemma 10.5 is reduced to the following lemma.

LEMMA A.1. For any |q|<CA~! one has

d—3 2
11::/ _du(p) N L (A.2)
re la—e(p)+in|[B—e(p+q)+in| lllell
—1/2,+d—3 2
L= / : _dul) O e losnl”
re [[p—rl la—e(p)+inl|B—e(p+q)+in] llglll

uniformly in r, a and (.
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Proof. The bound on I; follows from a direct calculation and |q|<CA™1:

¢ d—14 1 d d—3|] 2
11</ L - 26 <& |log [ (A.4)
o la—u?/24in| J_ |28—(u2+q?)—2|q|uc|+n lq]

If n<|q|, then we use that ||q||<]|q| to obtain (A.2). If |¢|<n, then we use Schwarz
inequality to separate the denominators and use (3.14) to conclude the proof of (A.2).

To prove (A.3), we first establish the following bound uniformly in «a:

1 dp(p)
we o=l Ja—e(p) +in]

J:= C¢?2|logn|, (A.5)

which follows by a direct calculation

ui=1d ! d
J<C/ 2 - {H’/ - 1/2
Ja—u?/2+in| -1 |u2 472 =2|r|uc|

. ’ dv
C d—3 d—2 /
(€2 +¢79) | Tozorin] S

< ¢ (logn|,

with u=|p| and v=2%u?, and using that |u®+7*—2|r|uc|>|u|?|1—c?| for |¢|<1.
We may assume that |¢|>n, otherwise we can estimate the 3-denominator in (A.3)

trivially by n=!

and we can conclude with (A.5). We then distinguish two cases. If
[lp—7||=n"?, then we estimate ||p—r|| trivially and we use (A.2).

Now let ||p—r| <n'/2. We split this case into two subcases, |¢| <2|p| and |¢|<2|p+q,
whose union clearly covers all values of p.

In the case where |g|<2|p|, we estimate the square root of the 3-denominator trivially
and use the Schwarz inequality to separate the remaining -denominator from the point

singularity. The corresponding contribution can be estimated by

C 71/2/ 1(|q| <2|p|) { 1 1(|lp—rll <n'/?)
n . . :
re |a—e(p)+in| [ [B—e(p+q)+in] lllp—]l

] dp(p).

The first term was already estimated in (A.2). The second term is bounded, by the

co-area formula, by

2

¢ J, d 1 —r|| < nt/?
077_1/2/ S with Ja;:/ (o= a L av(p),
(lql/2)2 le—a+in]|af S | i |

where ¥,:={p:e(p)=a} and dv(p) is the surface measure. Clearly J,<|logn|, and we
obtain the estimate Cn~'/2|log n|%/|q|.

In the case where |¢|<2|p+g|, we shift p—~p+q and r—r—gq, and interchange the
role of the a- and (3-denominators in the above proof. O
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